The CSI Journal on
Computer Science and Engineering
A 6-monthly publication of Computer Society of Iran (CSI)
Editor-in-Chief
H. Sarbazi-Azad, Professor, Sharif University of Technology, and IPM, Tehran, Iran.

Editorial Board
G. Agha, Professor, University of Illinois at Urbana-Champaign, USA.
H. Arabnia, Professor, University of Georgia, USA.
F. Arbab, Professor, CWI and Leiden University, The Netherlands.
K. Badie, Associate Professor, Iran Telecommunication Research Center, Iran.
N. Bagherzadeh, Professor, University of California at Irvine, USA.
B. Bose, Professor, Oregon State University, USA.
A. Edalat, Professor, Imperial College, UK.
M. Fathi, Professor, Iran University of Science and Tech., Iran.
M. H. Ghassemian, Professor, Tarbiat Modarres University, Iran.
M. Ghodsi, Professor, Sharif University of Technology, Iran.
A. R. Hurson, Professor, Pennsylvania State University, USA.
F. Jahanian, Professor, University of Michigan, USA.
E. Kabir, Professor, Tarbiat Modarres University, Iran.
F. C. M. Lau, Professor, University of Hong Kong, Hong Kong.
A. Movaghar, Professor, Sharif University of Technology, Iran.
N. Mahdavi-Amiri, Professor, Sharif University of Technology, Iran.
R. Meybodi, Professor, Amirkabir University of Technology, Iran.
K. Nakano, Professor, Hiroshima University, Japan.
M. Ould-Khaoua, Professor, University of Glasgow, UK.
B. Parhami, Professor, University of California at Santa Barbara, USA.
R. Safabakhsh, Professor, Amirkabir University of Technology, Iran.
H. Sarbazi-Azad, Professor, Sharif University of Technology, and IPM, Iran.
B. Shirazi, Professor, Washington State University, USA.
A. Zomaya, Professor, the University of Sydney, Australia

Assistants
M. Asadinia (Editorial Assistant)
L. Nourani (Publication Assistant)
A. Tavakkol (Webmaster)

Disclaimer: Publication of papers in CSI-JCSE does not imply that the editorial board, reviewers, or CSI-JCSE accept,
approve or endorse the data and conclusions of authors.

The CSI Journal on
Computer Science and Engineering

Vol. 13

No. 2

2016

CONTENTS
 An Energy-Optimal Real-Time Scheduling Algorithm for Unrelated DVS-Enabled Parallel
Machines ……………………………………………………………………………………………...….. 1
Mahmood Gholipour, Mehdi Kargahi, Heshaam Faili, Shahbaz Youssefi and Hadi Ravanbakhsh
 Taxonomy and Overview of Distributed Malfunction Diagnosis in Networks of Intelligent
Nodes …………………………………………………………………………………………………..... 23
Behrooz Parhami, Nan Wu and Sixin Tao

 Exploring Reconfigurability Options Among Decimal Adders ...................................................... 32
Samaneh Emami and Mehdi Sedighi
 A Deep Learning Method to Estimate 3D Point of Regard by Joint Head and Eye
Information …………………………………………………………………………………………...… 42
Rahim Entezari, Mohammad Mahdi Arzani, Mahmood Fathy and Amir Hossein Bayat
 The Impact of Excess-Modulo Representation of Residues on Modulo-(2n - 5) Parallel Prefix
Addition ………………………………………………….………………...………………….……...… 48
Ghassem Jaberi and Hassan Ghasemi Motlagh
 Low-Power Hierarchical FinFET-Based SRAM …………………….………………………...….. 54
Somayeh Maabi, Sina Sayyah Ensan, Mohammad Hossein Moaiyeri and Shaahin Hessabi

The CSI JJournal on
Computerr Science and Engineering
E
Vol. 13, N
No. 2, 2016
Pages 1-222
Regular P
Paper

An Energy
E
-Optim
mal Reall-Time Schedu
S
uling Alggorithm
m for
Unrrelated DVS-En
D
nabled Paralleel Mach
hines
1
1, 2
Maahmood Gholipour
G
Mehdi Kargahi
K
Heeshaam Faaili1
3
Shahbaz Youssefi
Y
Hadi Ravanbakhsh1
1

School of Eeectrical andd Computer Engineering
S
g, Universitty of Tehrann,Tehran, Irran
School of
o Computerr Science, Innstitute for Research in
n Fundamenntal Sciencees (IPM), Teehran. Iran
3
D
Department
t of Informaatics, Bioenngineering, Robotics
R
an
nd Systems Engineering
E
g, Universitty of Genovva,
Italy
2

Ab
bstract
Thee category of unrelated
u
paralleel machines is one
o of the most realistic modeels of heterogenneous multiprocessor systems. In this model,, the
pairr of task and machine
m
(processor) jointly speecifies the requiired execution time
t
and energyy to complete thhe task. In this paper, we conssider
the problem of schheduling real-tiime tasks on a set of unrelated parallel mach
hines with the capability
c
of vooltage selection
n through Dynaamic
DVS). The taskks can migrate among the proccessors and eacch processor is also permitted to switch amon
ng a set of disccrete
Voltage Scaling (D
volltage levels (annd thus, task-sppecific speed levels)
l
to miniimize the overaall system eneergy usage. A polynomial-tim
me Energy-Optiimal
Reaal-Time Scheduuling Algorithm
m (EORTSA) iss proposed: At first, the probleem of energy-optimal task-to-m
machine and vo
oltage-level-to--task
assignments are formulated
f
as a linear program
m and used as a polynomial-ttime schedule ability test for periodic tasks. Second, task sets
t schedule abbility test are feasibly scheduleed on the machiines using a maatching-based algorithm. We prove
p
that the worst
w
which are passed the
num
mber of migratory tasks is 2m
m, where m is the
t number of machines. Also
o, the worst-caase total numbeer of migrations, preemptions and
volltage-level switcches is of O(m ) in each scheddule e period, which
w
is a period of time betweeen two arbitrarry consecutive task releases inn the
sysstem. Comparisoons with the PC
CG algorithm shhow up to 60%
% energy saving and reveal thatt EORTSA outpperforms PCG in
i terms of averrage
num
mber of task miigrations and prreemptions, esppecially in systeems with large number
n
of taskss.

Keeywords: Dynnamic Voltage Scaling (DVSS), Energy Opptimization, Miigration, Real-Time Systems, Scheduling, Unrelated Paraallel
Maachines.

1. Introducction
Real-time em
mbedded appplications need
n
predicctable
com
mputing plattforms and deep
d
informaation about their
behhavior with reespect to diffeerent patterns of usage to saatisfy
theeir time-sensittive requiremeents. Such appplications incclude
saffety-critical deecision makinng systems succh as those reelated
to earthquake, Air Traffic Control
C
(ATC
C), transportaation,
millitarism, and many
m
others which
w
mostly have
h
real-timee and
disstributed naturres. Recent advances
a
in multiprocessor
m
r and
disstributed systtem design (multi/many-core processsors,

SoCs, clouds, etc.) have reesulted great speedups
s
through
MPS
the execution off different taasks in paralllel. The paraallel
proccessing elemeents in the m
mentioned sysstems may have
h
eitheer equivalent capabilities ((e.g., multi-co
ore processorss or
hom
mogeneous muulti-server sysstems) or diffferent capabiliities
and characteristiics (e.g., asyymmetric mu
ultiprocessors or
heteerogeneous muulti-server sysstems with diffferent servicees as
welll as cloud com
mputing system
ms).
Even
E
systems which are suupposed to haave homogeneeous
proccessors may actually
a
be hheterogeneouss due to reassons
such
h as process variation [1] and processsor aging [2]. In
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overall, the diversity of available computer systems which
can be connected through interconnection networks, and the
distributed nature of the above-mentioned applications,
confirm that most systems are inherently heterogeneous.
These heterogeneities may be observed in both the
computing capability and power consumption of the
processing elements, with an emphasis to the fact that one
major concern in the design and management of such
systems is their energy usage.
As energy is an expensive resource nowadays, many
studies in the context of real-time systems have been
concentrated on the methods of energy saving in centralized
[3, 4, 5] and distributed [6, 7] real-time systems with the
consideration of the fact that the performance of such
systems should remain in an acceptable level. A well-known
method to do such management is to use dynamic voltage
scaling (DVS) [5], which is available in most modern
microprocessors [8, 9].
Meanwhile, another important property of the
heterogeneous distributed real-time systems is that at a
specific voltage-level of a DVS-enabled processor, the speed
and energy usage are task-specific, namely they depend on
the task running on the processor. This property, which is
valid for unrelated parallel machines (as defined formally in
Section 2), is a realistic consideration for today’s computing
systems. Such systems may contain different processing
units (e.g., graphics co-processors, math co-processors,
CPUs with different architectures, etc.), where each unit may
better work for specific tasks from both aspects of
computation speed and power usage. (Throughout this paper,
we use the two terms machine and processor
interchangeably).
In the current study, we present a scheduling algorithm
for a relatively complex multiprocessor system which
reflects a general behavior of the distributed real-time
systems mentioned above. We consider a distributed system
with periodic real-time tasks, where the system processors
are heterogeneous from both aspects of processing capability
and power usage. Furthermore, we suppose that speed and
energy usage at a specific voltage-level of the processor are
task-specific.
We consider a multi-criteria optimization problem which
within the real-time tasks should meet their deadline and the
energy usage should be minimized. Also, some methods will
be proposed to reduce the number of task migrations as
well as preemption and voltage-level switches. To the
best of our knowledge, we are unaware of any previous
study on a similar problem with the properties stated in this
paper.
The rest of this paper is organized as follows. The next
section reviews some previous work on identical, uniform,
and unrelated parallel machines. Then, we present a precise
definition of the problem considered in the current study in
Section 3. In Section 4, the concept of a schedule period
is introduced to reduce the problem to an abstract
version. Next, in Section 5, the proposed scheduling
algorithm and the respective schedule ability test are
described, whereas its optimality and correctnessare proved.
In Section 6, we discuss our method to reduce the degree of
migrations as well as the number of preemptions and
voltage-level switches. Section 7 reports the simulation
results and Section 8 concludes the paper and indicates some
future works.

2

2. Background
In this section, we review the properties and the respective
studies of three categories of multiprocessor systems, namely
identical, uniform, and unrelated parallel machines.

2.1. Identical Parallel Machines
The set of machines which are all identical and have the
same computational power is called a set of identical parallel
machines. In 1969, Muntz and Coffman [10] presented a
level algorithm for systems with two identical processors. A
strict fairness constraint for such systems, called P-fair, and a
scheduling algorithm based on P-fair has been presented by
Baruah et al. [11]. According to this algorithm, the resources
are given to the tasks in proportion to their weights. Due to
its strict fairness, this algorithm needs to reschedule tasks
many times, which results in many task switches and
migrations, and reduces the efficiency of the algorithm. A
similar idea, namely the Fluid schedule is also given by
Holman and Anderson [12].
The Fluid schedule, which is an ideal policy, assumes
that each task executes at a constant rate. This algorithm is
almost inefficient due to its high number of rescheduling.
However, in the study, the Stagger model is also proposed
which improves the P-fair algorithm.
Dertouzos and Mok [13] presented a model for
expressing the relation between the laxity and remaining
computation time of a task, called Laxity and Computation
plane (L-C plane). The laxity of a task is a measure of
urgency, which is represented on the x-axis and its remaining
computation time is shown on the y-axis. Cho et al.[14]
extended the idea of representing tasks as tokens in the L-C
plane and introduced Time and Local Execution Time
Domain Planes (T-L planes), where time and the remaining
execution time are represented on the x-axis and y-axis,
respectively. They proposed Largest Local Remaining
Execution Time First (LLREF) scheduling algorithm based
on the T-L plane and proved that it is an optimal online
scheduling algorithm for identical parallel machines.
Megel et al. [57] introduced a novel approach to decrease
preemption and migration count in optimal global real-time
scheduling on identical multiprocessors. Their approach is
composed of an offline and an online step. In the offline step,
a linear program decides about placing jobs on intervals.
Scheduling of associated jobs within each interval is done
dynamically by an online local scheduler. Their approach
suffers from severe issues: the proposed mixed integer linear
programming of offline part is computationally complex
since the problem is solving in a hyper period and the
number of MILP variables scale with the task count,
processor count and length of the hyper period.
For the sake of energy efficiency, different approaches
have been investigated which usually consider continuous
voltage-levels for the identical machines. Lee [15], through
Dynamic Voltage and Frequency Scaling (DVFS) in a
lightly-loaded multi-core system with periodic tasks,
achieved up to 64% energy saving comparing to some simple
methods. Chen et al. [16] devised a 1.13-approximation
algorithm for scheduling migratory periodic tasks on
identical multiprocessors, assuming each processor can take
arbitrary operating frequencies. Later, Chen and Kuo [17]
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proposed an optimal algorithm for migratory tasks and a
1.412-approximation when for non-migratory tasks,
considering that the tasks have different power
characteristics. Also, Chen et al. [18] proposed an algorithm
with a 1.283-approximation bound for energy usage to
schedule periodic tasks over identical DVS-enabled
multiprocessor, considering both dynamic and static sources
of power consumptions. If the overhead of turning processors
on and off is not negligible, though, their algorithm is within
a 2-approximation bound.

2.2. Uniform Parallel Machines
A set of processors which are solely characterized by their
computation speeds is called a set of uniform parallel
machines. Therefore, a job that executes for t time units on a
processor with the computation speed s performs s t units
of execution. Horvath et al. [19] extended the idea of the
level algorithm proposed in [10] to uniform heterogeneous
multiprocessors. Gonzalez and Sahni [20] proposed an
offline optimalO n m scheduling algorithm with no more
than 2 m 1 preemptions, where n is the number of tasks
and m is the number of processors.
Other works have also been done on the online
scheduling. Hochbaum and Shmoys [21] presented a
polynomial approximation algorithm to solve the minimum
makespan
problem
on
uniform
heterogeneous
multiprocessors. Baruah and Goossens [22] tried to adapt the
Rate Monotonic (RM) scheduling algorithm [23] to find a
static-priority online scheduling algorithm for uniform
multiprocessors.
They also presented a RM-feasibility test for this
problem, generalizing the RM-feasibility test of identical
heterogeneous multiprocessor systems. In a different study,
Funk et al. [24] presented a feasibility condition for periodic
task sets to be executed on uniform heterogeneous
multiprocessors. This condition (which is called FGB in
[25]) is based on the Earliest Deadline First (EDF)
scheduling algorithm [23].
In the same study, they also presented an EDF-feasibility
test; however, no efficient algorithm was found to schedule
the task sets satisfying the FGB condition. Chen and Hsueh
[25] proposed an optimal online O n log n scheduling
algorithm called PCG with at most n rescheduling, where n is
the number of tasks. In their study, T-Ler plane was
introduced and a greedy algorithm was proposed. They also
proved the optimality of their algorithm based on the FGB
condition.
In regard of energy efficiency in uniform parallel
machines, Funaoka et al. [54] proposed a real-time static
voltage and frequency scaling (RT-SVFS) technique based
on an optimal real-time scheduling algorithm (LLREF) by
means of T-L Plane transformation, which is a technique to
apply processor frequency scaling to LLREF scheduling.
They proposed a uniform RT-SVFS algorithm and then
extended it to an independent RT-SVFS for uniform
platforms.
Later, in [55] they extended this work and proposed a
real-time dynamic voltage and frequency scaling (RT-DVFS)
techniques based on RT-SVFS. Despite the significant
run-time overhead associated to it, RT-DVFS obtains better
energy saving than RT-SVFS.

3

2.3. Unrelated Parallel Machines
In unrelated parallel machines, there is an execution rate s
associated with each task-processor pair T , P , with the
interpretation that task T performs s t units of execution if
executed on processor P for t time units. Two common
methods for solving such scheduling problems in parallel
machines are task partitioning and global scheduling. In the
former method, certain tasks are only allowed to be executed
on certain machines and only partial migration is allowed.
Using this type of static decision has some performance
advantages such as reducing the migration overhead. For
example, Yu and Prasanna [26] explored minimizing the
energy usage of periodic real-time tasks on unrelated parallel
machines by task partitioning and proposed a polynomialtime scheduling algorithm by relaxing integer linear
programming. The method of task partitioning is generally
sub-optimal. Due to the NP-hard nature of such scheduling
problems in their general form [12, 27], it is convenient to
propose heuristics or efficient algorithms for special forms of
the problems. Accordingly, the latter method, namely global
scheduling is desired in many cases to feasibly schedule the
task sets, in which an important criterion is to keep low the
number of migrations.
Lenstra et al. [28] presented a polynomial approximation
algorithm for unrelated parallel machines to find a schedule
that minimizes the makespan. They guarantee that it is not
longer than twice the optimal value for the case where the
number of processors is fixed. They also proved that no
polynomial algorithm could achieve a worst-case ratio less
than 1.5 unless P = NP. For the case of two processors,
Gonzalez et al. [29] introduced a linear time algorithm to
construct optimal scheduling which have at most two
preemptions. Jansen and Porkolab [30] gave a fully
polynomial-time approximation algorithm for the problem of
scheduling tasks in the case where each task can be executed
only on one processor. Srivastava [31] developed a tabu
search heuristic for minimizing makespan in that problem.
This algorithm produces near-optimal results with reasonable
amounts of computational time for problems of reasonable
size. Baruah [32] proposed a polynomial-time feasibility test
for the global heterogeneous multiprocessor scheduling.
They also presented a scheduling solution as a proof for
correctness of the test; such schedule however suffers from
high preemption and migration cost.
The lack of an optimal scheduling algorithm with
reasonable cost motivated us to propose an optimal
scheduling algorithm; however optimality is only one of
aspect of our work and we also consider the energy
optimality of scheduling algorithm. Recently, Cucu-Grosjean
and Goossens [56] proposed two exact schedule ability tests
for task-level fixed-priority and job-level fixed-priority
earliest deadline first scheduler on specific tasks executing
on unrelated parallel machines. Also, for a special case of
heterogeneous parallel machines which includes two type of
processors, Raravi et al. [58] proposed two scheduling
algorithms with time complexity of O nlog n for implicit
deadline sporadic task set. They consider that task migration
is only possible among processors of the same type.
Many works have also been done on energy-constrained
unrelated parallel machines. Hsu et al. [33] and Chen and
Kuo [34] tried to find a solution for cost minimization of
machines and allocation, respectively under the given timing
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and energy usage constraints. Chu et al. proposed a nearoptimal [35] and later an optimal [36] solution to the voltagesetup problem; their work is the assignment of voltage-levels
to processors with the limitation that each processor assumes
one voltage-level throughout the system lifetime. Luo and
Jha [37] devised both static and dynamic variable voltage
scheduling algorithms to minimize the energy cost of
scheduling dependent periodic and aperiodic tasks on
unrelated parallel machines.
Some studies consider discrete voltage-levels for nonmigratory task, and thus, they use different approaches to
solve a NP-Complete problem. Ding et al. [38] approached
the problem using the ant colony optimization in order to
obtain energy efficient scheduling of partially dependent
tasks on DVS-enabled processors, even with coarse-grained
voltage modes. Lin et al. [39] addressed the problem when
systems in question work on rechargeable batteries. They
solve the problem based on four heuristics including genetic
algorithm and ant colony optimization.
Yang et al. [7] used a fully polynomial-time
approximation scheme for such problems. Yu and Prasanna
[26] approximated the energy efficiency when assigning nonmigratory tasks to DVS-enabled processors. They formulated
the problem as an extended generalized assignment problem
and also hired a heuristic to approximately solve the NPComplete problem. They used a model in which the DVSenabled machines have discrete voltage-levels, where both
speed and energy usage of machines depend on the voltagelevels as well as the tasks they are running.
The above studies, although valuable, suffer from at least
one of the following problems: (i) They do not take the
advantages of DVS for runtime energy management into
account [35, 36], (ii) Machine speeds are available in a
continuous spectrum [35, 36, 37], (although power-supply
electronic may provide systems with continuous voltage
spectrum in the future, it is a fact that most of the currently
available DVS-enabled microprocessors (e.g. Trans meta,
Intel, and AMD) use a few discrete voltage-levels [40]), (iii)
Energy usage of a machine depends either only on its
specification (speed and/or workload) or only on the task that
is running, rather than both [35, 36, 37, 38, 34, 7, 39, 33],
and (iv) No task migration is permitted [26, 35, 36, 37, 38,
34, 7, 39, 33].
Although task migration in unrelated parallel machines
offers potential energy/performance gains, there are also high
costs and complexities involved in the migration process.
Hence, it has not attracted considerable attention from
researchers. However, according to recent researches
[41, 42, 43, 44], this cost has became reasonable and task
migration in unrelated parallel machines has become a
feasible option. We consider task migration to better utilize
the available heterogeneity of the platform as well as to
achieve better power-performance efficiency.

3. System Model, Problem Definition and
Conceptual Solution1
In this section, we introduce the model of the system. Also,
we present the precise definition of the problem under study
a general view to the solution method.

4

3.1. Task Model
We consider n periodic tasks shown as the task set T
T , … , T . Each task Ti, i=1,…,n is independent of the other
tasks and is described as (p ,e ), where pi is the task period,
e is its execution requirements and the respective relative
deadline is again pi. Additionally, there is a dummy task
represented by T with an execution time and period equal to
the sum of the processor idle times and hyper period
respectively.

3.2. Processor Model
The system consists of m unrelated parallel machines shown
as the set M  {M 1,..., M m } with no resource contentions.
Machine Mj, j=1,…,m has kj voltage-levels as
th
Vj  {Vj1,...,Vjk }. At the l voltage-level of Mj, namely Vjl,
j

S
S
is
l=1,…,kj, a maximum speed Sjl, S
achievable
and
a
maximum
power
Powjl,
( Pow j1  Pow j 2  ...  Pow jk ) may be consumed. Based on the
j

characteristics of the running task at voltage-level Vjl, the
attainable speed and the respective power usage may be far
less than Sjl and Powjl, respectively.

3.3. Task-Processor Model
As also indicated in the processor model above, we consider
m unrelated parallel machines (note that uniform and
identical parallel machines are special cases of unrelated
parallel machines). Therefore, each task Ti, i=1,…,n if
assigned to a processor Mj, j=1,…,m which works at the
voltage-level Vjl, l=1,…, kj, can be run with a speed of Sijl
S ). Meanwhile,
which certainly is a fraction of Sjl(0 S
the task-specific power usage of processor Mj working at
voltage-level Vjl, when task Ti is run upon which, will be
Pow ).
Powijl, which again is a fraction of Powjl 0 Pow
In addition, Pow0jl is the power usage of processor Mj when
it is idle, or equivalently executes the dummy task T0, at
voltage-level Vjl. In this regards, if Ti runs for duration of
length t on machine Mj working at voltage-level Vjl, the
energy usage of the task-processor pair in the duration can be
calculated as:

Eijl (t)  Powijl  t

(1)

To obtain the task execution times at different voltagelevels of the unrelated parallel machines, we consider the
following information. Source code of each task is compiled
separately for every supported processor in the set of
unrelated parallel machines. The generated binary codes will
be executed on the corresponding processor, and thus, the
worst-case number of CPU cycles is determined. For each
voltage-level of the DVS-enabled processor, a similar
scenario is followed. For each task, the processor with the
longest execution, which is less than or equal to the task
deadline, will be considered as the base processor. We
consider the execution speed of the base processors as 1 and
execution speed of the task on the other processors are
normalized with respect to this execution time. In our
notation, we refer to the task execution time on base
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processor as task execution time in our task model.
Moreover, each task can run on at most one machine at
each instant of time and can arbitrarily migrate across
different machines during its execution. Without loss of
generality in the proposed algorithm, we assume negligible
overheads for task migrations, preemptions, and voltagelevel switches in the current study. By the way, we propose
some techniques which significantly reduce the number of
such events, and thus, reduce the respective overheads.

3.4. Problem Definition
The problem considered in this paper is to schedule a feasible
task set T on a given set of machines M with the goal of
minimizing the power consumption. We need to divide the
task instances (jobs) into job slices. A job slice is defined by
a vector T , M , V , t , t , meaning that task Ti is scheduled
on machine Mj working at voltage-level Vjl from time ts to
time tf. Furthermore, it is considered that [ts , t f ) is a period
where the task is executed uninterruptedly, i.e., with no task
migration, preemption, or voltage-level switching during that
period. Equivalently, we use T , M , V , t , t to denote that
Mj is in idle mode in the period of [ts , t f ) .
Let define the average system energy usage in a time
interval [ a , b ) as:
E ( a, b) 

(  in 0  mj1  lkj 1 Powijl  tˆijl )
(b  a )

(2)

where tˆijl  (b  a) is the total length of time during time
interval [ a , b ) in which task Ti runs on machine Mj at voltagelevel Vjl. The resulting schedule is to minimize the average
system energy usage throughout the system lifetime. This
can be achieved by minimizing the average system energy
usage in a hyperperiod of length H, i.e., (E(0, H )) , where the
resulting energy is shown as E(H)min . This goal can be
achieved by appropriate determination of the job slices along
with the consideration of all other constraints.

3.5. Conceptual Solution
The proposed solution to the defined problem can be
summarized as follows:
1. We first reduce the scheduling problem in a
hyperperiod to scheduling the scaled tasks in Schedule
Periods (SPs) of unit length (defined in Section 4) that is
easier to solve.
2. Then, we model the scheduling problem in the SPs
with Linear Programming (LP). If a solution to this LP
exists, it specifies the required amounts of time that each
task needs to be run at every voltage-level on each
machine. These amounts of execution minimize the
system energy usage in a manner that all deadlines are
met. The algorithm for this step can be independently
used for schedulability test of real-time periodic tasks on
unrelated parallel machines and is explained in detail in
Section 5.1.
3. Tasks are assigned to processors based on the results of
Step 2. An extension to Lemma 2 of [32] is a solution for

5

task scheduling; such a solution suffers from large
number of preemptions, migrations and voltage-level
switches. Hence, we use this solution only to prove the
existence of a feasible schedule. Instead, we have
proposed a scheduling algorithm which aims to reduce
the number of migrations and preemptions. Our algorithm
is composed of the following steps:
3.1.1 Each SP interval is divided into several time
intervals with different lengths. The procedure to
obtain lengths of these intervals is explained in
Section 5.
3.1.2 For each interval, task to processor assignments
is found by solving a custom model of minimum-cost
network flow problem. This matching is selected in a
way that it leads to significant decrease in the number
of preemptions and migrations in the hyper period.
Procedure from Steps 3.1.1 and 3.1.2 implicitly
prevents the overlaps of execution of segments of a
task on different processors.
3.1.3 Number of migrations, preemptions and
voltage-level switches is further reduced by use of
mirroring technique which discussed in Section 5.2.3.
3.2 Then, the remaining tasks, i.e., non-migratory ones,
are scheduled on the machines. The main point about
scheduling non-migratory tasks is that we are not
concerned about the parallel execution of job slices of a
task. Hence they can be scheduled using an algorithm
such as EDF in the remaining free intervals of the
machines which prevents excessive preemptions and
voltage-level switches. Subsection 5.3 describes this
step, which completes the solution.

4. Schedule
Scheduling

Period

and

Feasible

To address the aforementioned problem, in this section we
introduce the concept of schedule period, which has been
borrowed from Fluid scheduling method [12] and is used to
convert the scheduling problem into an equivalent but
simpler one. The idea of Fluid scheduling is to execute the
tasks at a constant rate in a way that the tasks execution are
finished exactly at their deadline [12]. In a T-L plane, as
introduced in Section 2, tokens representing the tasks move
over time. The trajectory of such a token during the
execution of the respective task according to its Fluid
schedule is called the task Fluid path.
Therefore, the Fluid path is simply a straight line between
the coordinates r, e and r p, 0 in the respective T-L plane,
where r is the task release time, e is its execution
requirement, and p is the respective relative deadline
(see figure 1). The actual path is the result of concatenation
of execution lines of the task. The slope of each execution
line depends on Sijl for task Ti when it is running on machine
Mj at the voltage-level Vjl. This slope is zero when the task is
not running on any machines.
We define a Schedule Period (SP) as a period between
two arbitrary consecutive task releases in the system.
Scheduling is done on a per SP basis. Consider n tasks
T1 , T2 ,..., Tn with their Fluid paths as shown in figure 2. In the
time period between two task releases, namely in SPk (with
start time of sk and finish time of fk), each task Ti, according
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to its Fluid schedule, executes for a certain amount of time,
shown as eik. This piece of a task is called a scaled task. Then
the relative deadlines for the execution of all the scaled tasks
located in SPk are equal to the length of the respective SP
(shown as | SPk | in this case). Accordingly, a new set of
scaled tasks is resulted which we call it scaled task set. Thus,
the scaled task set is shown as {ST1 , ST2 ,..., STn } with each
scaled task STi having an execution requirement of eik and all
the scaled tasks having a relative deadline of length | SPk | .
It is proven in Theorem 1 below, which a task set is
schedulable with average energy usage E, if and only if the
respective scaled task set in a SP is schedulable with the
same amount of average energy usage. Therefore, the
problem is reduced to scheduling the scaled tasks in only one
SP. The resulting schedule can then be used to schedule the
scaled tasks in every SP as well as the task set in a hyper
period, and as a result, throughout the system lifetime.
Theorem 1. A periodic task set is schedulable on a set of
unrelated parallel machines with an average energy usage E,
if and only if the respective scaled task set is schedulable in a
SP with the same average energy usage on the same set of
machines.
Proof. Suppose the scaled task set is schedulable in a SP,
namely SPk, with average energy usage E. Consider the tasks
and their Fluid paths as in figure 2. For each task Ti, the
slope of its Fluid path is ei pi . In the schedule period SPk,
each scaled task STi has an execution requirement of:

ei k | SPk |  ei pi
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(3)

In this regards, for another schedule period SPk' with the
length | SPk  | , we can scale the schedule obtained for SPk by
a factor of | SPk  | | SPk | . Then we obtain a new schedule for
SPk', within which each scaled task S Ti has a execution
requirement of e as:
(4)

| SPk |  ei pi  | SPk  | | SPk | | SPk  |  ei pi

In general, schedule scaling for SPk by a factor of K
means
that
corresponding
to
each
job
slice
(Ti , M j ,V jl , sk  ts , sk  t f ) with an average energy usage of
E(sk  ts , sk  t f )  Powijl in the primary schedule, there is a job

slice (Ti , M j ,Vjl , sk  K  ts , sk  K  t f ) in the scaled schedule
with

the

average

energy

usage

usage does not change for any job slices in the scaled
schedule and all job slices’ lengths are scaled by the same
factor K. Thus, the average energy usage of SPk' would be
E(sk , fk )  E(sk , fk ) .
However, this new execution requirement (resulting from
(4)) is the same as the execution requirement for task Ti in
the schedule period SPk', i.e., eik'. Therefore, to obtain a
schedule for an arbitrary schedule period SPk' with length
| SPk  | , it is sufficient to multiply each job slice in the given
scheduling of SPk by | SPk  | | SPk | .
SPk

SPk+1

Fluid path
Actual path traversed in a
certain schedule

Remaining Execution times

Remaining Execution Time

Token representing task T

e

T1

e1 k
e1k+1

Time

T2
e2

k

e2k+1

Time
en k

Tn
r

enk+1

r+D

Time

Time

Figure 1. A sample T-L plane

Figure 2. Schedule periods

Time
T2
Time
Tn

(a)

T1

Remaining Execution Times

Remaining Execution Times

T1

of

E(sk  K  ts , sk  K  t f )  Powijl . Clearly, the average energy

Tn
T2

(b)

Time

Time

Figure 3. Relaxing the problem of scheduling in a SP to one hyper period: a) Fluid schedule of periodic tasks in one hyper
period, b) Cumulated execution times of the tasks in the hyper period
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In this way, the task set would be schedulable in all the
SPs. Scheduling the scaled tasks in each SP results in each
scaled task token in the respective T-L plane to meet the
task’s Fluid path at the end of the SP. Since all the scaled
task deadlines are located at the end of their respective SPs,
all deadlines are met by individual scheduling of each SP.
Besides, average energy usage in all the SPs is the same and
equal to E. Thus, the average energy usage in a hyper period
would be the same. Thus, the periodic task set is schedulable
with the average energy usage E.
To prove the theorem in the inverse direction, suppose
the task set is schedulable. Consider the length of the tasks
hyper period is H and the average energy usage is E. In this
regards, task Ti is executed H pi times in the hyper period,
each with the length of ei. Therefore, in each hyper period,
task Ti has a cumulative execution requirement of length
H  ei pi . The problem of scheduling tasks with H  ei pi ,
i=1,…,n execution requirements, all having a relative
deadline equal to H, is a relaxed version of the original
problem (see figure 3).
In other words, we can scale down the scheduling in a
hyper period by factor | SPk | H to address the problem of
scheduling the respective scaled task set in SPk for an
arbitrary value of k. The reason is that each task Ti
must be executed for | SPk |  ei pi which is equal to
H  ei pi  | SPk | H . Besides, the average energy usage
remains equal to E, because scaling a scheduling does not
change its average energy usage. Thus, the proof is complete.
Let E(SP)min show the minimum value of the average
energy usage of the scaled task set in a SP that can be
obtained through proper scheduling. Then we have:
Corollary 1.The minimum average energy usage for a set of
periodic tasks on a set of unrelated parallel machines is E if
and only if the minimum average energy usage for
scheduling the corresponding scaled task set in an arbitrary
SP (e.g., SPk) on the same set of machines is E, or
equivalently, E(SP)min  E(H )min .
Proof. We use contradiction for the proof. First, consider that
there is a scheduling with an average energy usage E(SP)min
(  E(H )min ) for the scaled task set in a SP. However,
according to Theorem 1, we were able to schedule the
periodic task set with the average energy usage E(SP)min ,
which is in contradiction to the optimality of E(H )min .
Similarly, for the inverse direction, consider that there is a
scheduling with average energy usage E(H )min (  E(SP)min )
for the periodic task set. Again, according to Theorem 1, we
were able to schedule the scaled task set with the average
energy usage E(H )min in the SP, which is in contradiction to
the optimality of E(SP)min .
In the following, we provide a scheduling algorithm for
the scaled task set in a SP of unit length to minimize the
energy usage. Then we use the obtained schedule to construct
a global schedule with minimal average energy usage for the
task set.
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5. Energy-Optimal Task Scheduling on
Unrelated Parallel Machines
The proposed Energy-Optimal Real-Time Scheduling
Algorithm (EORTSA) has three steps. First, to assure that all
the deadlines can be met and the energy usage is minimized,
we find the required amounts of time that each task needs to
be run on each machine, as well as the length of time that it
needs to spend at each voltage-level on that machine. The
algorithm for this step, explained in detail in Section 5.1, can
be independently used for schedule ability test of real-time
periodic tasks on unrelated parallel machines. Second, we
schedule the tasks which need migration, namely migratory
tasks, on the appropriate machines. The details of this step
are discussed in Section 5.2. Finally, the remaining tasks, i.e.,
non-migratory ones, are scheduled on the machines
determined in the first step, only in the remaining free
intervals of the machines, which completes the solution as
discussed in Section 5.3.

5.1. Schedule Ability Test
In this subsection, we use linear programming to assign the
system tasks to the unrelated parallel machines and set their
speeds in a manner that the average system energy usage is
minimized and all the deadlines are met. This assignment can
then be used as a schedule ability test for the system. Given n
tasks and m machines, the amounts of time that each task Ti,
i=1,…,n needs to be run on machine Mj, j=1,…,m, at
voltage-level Vjl, l=1,…,kj, namely tijl in a SP of unit length
is derived. The objective function here is to minimize the
average energy usage in a SP, which is equivalent to
minimizing the total energy usages of the machines
(based on Corollary 1). Thus, the optimization problem is
formulated as follows (notice that the length of SP is
considered 1):
Minimize
E  mj1(in0 (lkj1 Powijl  tijl ))

(5)

Subject to
mj1 lkj1 sijl  tijl  ei pi ,

i=1,...,n

in0 lkj1tijl  1 ,

j = 1,...,m

mj1 lkj1tijl  1 ,

i = 1,…,n

tijl  0 ,

i = 1,...,n, j = 1,...,m, l = 1,...,kj

The first constraint above indicates that the total
normalized execution time of task Ti with respect to the
speed levels of the machines at different voltage-levels
should be equal to its normalized expected execution
requirement. The second constraint indicates that the idle
times of machine Mj and the total execution time of the job
slices assigned to that machine should be equal to the length
of the respective SP. Also, the third constraint mentions that
the total execution time of task Ti on different machines
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voltage-level when they are idle. Example 1 illustrates how
this optimization works.

working at different voltage-levels should not violate the
scaled task deadline, which is again the length of the SP (i.e.,
the task cannot be executed for longer than the SP length).
The last constraint simply indicates that all the times are
nonnegative. Solving this LP problem, the tijls, i = 1,…,n, j =
1,…,m, l = 1,…,kj, are obtained which specify how long each
task Ti should be executed on machine Mj at voltage-level Vjl
to minimize the overall system energy usage.
In other words, we model the energy-optimal scheduling
as a LP problem. This LP model could be used as a schedule
ability test as follows. If there is not any solution for
scheduling the given task set on the given set of parallel
machines, then the LP problem does not have any solution.
In addition, it is guaranteed that if the task set is schedulable,
then the LP problem certainly has a solution.
According to the optimization, if there are two voltagelevels l and l' for machine Mj in an order that t 0 jl  0 and

Example 1: Suppose a machine set M  {M j | 1  j  4} ,
where M1 and M4 have two voltage-levels and the other
machines work in only one voltage-level. The execution
requirements and periods of the tasks of T  {Ti | 1  i  7} are
listed in table 1. Given the task power consumptions
(Table 2) and execution speeds (Table 3) on different
voltage-levels, the non-zero variables have been obtained by
solving the LP, as shown in table 4.
Corresponding to each t 0 jl  0 ( i  0 ), we define a task
segment (TSijl) of length tijl, with the interpretation that there
is a segment of task Tito be executed upon machine Mj at
voltage-level Vjl. For the SP under discussion, we divide
these segments into two categories: segments which belong
to the tasks running over more than one machine in that SP,
referred to as segments of migratory tasks, and segments
running over only one machine during the SP, referred to as
segments of non-migratory tasks.
In Sections 5.2 and 5.3, respectively, scheduling of
migratory and non-migratory task segments over the
processors is discussed.

t0 jl  0 while Pow0 jl  Pow0 jl , the energy usage can be
reduced by setting t0jl to t 0 jl  t 0 jl  and t0jl' to zero, which has
no effect on the satisfaction of the other constraints.
Applying this method iteratively, we can reach to a situation
in which there are no two voltage-levels for a machine Mj so
that t 0 jl  0 and t0 jl  0 , and therefore, machines use only one

Table 1. Execution requirements and periods of tasks
Task Characteristics
E
P

T1
40
40

T2
90
100

T3
40
50

T4
20
25

T5
75
100

T6
8
10

T7
10
12

Table 2. Power usage of different tasks on different voltage-levels
Voltage-level
V11
V12
V21
V31
V41
V42

T0
1
2
1
1
1
2

T1
5
7
2
5
2
4

T2
7
9
4
6
2
5

T3
2
3
6
2
2
5

T4
2
4
3
2
2
5

T5
2
4
4
2
2
3

T6
3
6
5
11
4
6

T7
3
5
3
5
4
6

Table 3. Execution speed of different tasks on different voltage-levels
Voltage-level
V11
V12
V21
V31
V41
V42

T1
1
2
0.5
2
0
0

T2
0.5
1
2
1
1
2

T3
1
2
0
0.5
1
2
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T4
0.5
1
0
2
0
0

T5
0
0
0
2
0
0

T6
1
2
2
0
0.5
1

Table 4. List of non-zero variables at optimal poin
Variable

Value

Type

t112

0.16904761

Segment of a migratory task

t121

0.4238095

Segment of a migratory task

t131

0.225

Segment of a migratory task

t241

0.9

Segment of a non- migratory task

t312

0.35

Segment of a migratory task

t341

0.1

Segment of a migratory task

t431

0.4

Segment of a non- migratory task

t531

0.375

Segment of a non- migratory task

t611

0.4809523

Segment of a migratory task

t621

0.15952380

Segment of a migratory task

t721

0.416

Segment of a non- migratory task

T7
0.5
1
2
0.5
1
2
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For each (Ti , M j )   , there is at least one segment of a

5.2. Scheduling Migratory Tasks
In this subsection, we discuss the method of scheduling
segments of migratory tasks in a SP of unit length. Without
loss of generality, we perform the scheduling in the interval
0,1 . All the segments of migratory tasks, i.e., TSijls should
be scheduled on their corresponding machines (Mj) with no
parallel execution of different job slices of the same task.
This scheduling is done through an iterative algorithm,
namely Algorithm 1, as shown in Algorithm 1.
Algorithm 1. Scheduling algorithm for migratory tasks
1.
1.1.
1.2.
2.
3.
4.
5.
5.1.
5.2.
5.3.
5.3.1
5.4.
5.5.
5.5.1
5.5.2
5.6.
5.7.

For each tijl ; i=1,…,n;j =1,…,m; l=1,…,kj
if Ti is a migratory taskthent'ijl=tijl
else t'ijl=0
γ 1
prevX
nextX
whileγ 0
U
urgenttasks
F
fullmachines
if ( U
or F
)
nextX= matching (prevX)
determine value of σ// σ is the time that is scheduled in
this iteration
nextX
for each T , M
an arbitrary task segment TSijl is scheduled in the interval of
[   ,  )

t'ijl = t'ijl– σ

prevX

nextX

γ=γ–σ

In the beginning of each iteration, all machines have idle
periods in the range of 0, γ . In each iteration, some part of
scheduling is done in the time interval [   ,  ) , where the
length of such interval, i.e. σ 0, is specified through the
determination of some task-machine pairs and their
respective voltage-levels. Before going further, we introduce
some notations and terminologies. Having the value of γ at
the beginning of an iteration and t s as defined in Algorithm
1, we define machine Mj as full if
 
in1 lkj1 tijl

(6)

which means machine Mj should execute migratory tasks for
all the remaining time and has no other time to be idle or
execute non-migratory tasks during the interval 0, γ . We
use F to refer to the set of such full machines. Similarly, we
call a migratory task Ti as urgent if
 
mj1 lkj1 tijl
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(7)

namely, task Ti should be executed continuously in the
remaining period 0, γ in order to be completed on time. We
use U to refer to the set of urgent tasks. In each iteration, full
machines and urgent tasks are selected to be scheduled. This
decision is made to prevent unnecessary preemptions and
migrations. For this purpose, in each iteration, we need to
find a bijective function χ: D R, where D and R are set of
tasks and machines, respectively, satisfying conditions
U  D  T and F  R  M . More precisely, χ is a matching
that maps each urgent task to a (possibly full) machine and
some other tasks to the remaining full machines.

migratory task TSijl while t
0. This means that task Ti still
must be executed on machine Mj for some amounts of time.
Our proposed approach for finding the matching will be
discussed in detail in Subsection 5.2.1.
Two approaches are followed in the matching algorithm
to reduce the number of migrations, preemptions, and
voltage-level switches:
1. In each iteration, to find the matching χ, the algorithm
gets feedback from the task-to-processor assignments of
the previous iteration. In other word, we intend to select
the same edges that have been selected in previous
iteration, or equivalently, assign tasks to the same
processors to which they have been assigned in the
previous iteration. This strategy leads to improvement in
the number of migrations and preemptions as well as
voltage-level switches.
2. We postpone scheduling tasks and processors as late
as their equivalent nodes become critical. In each
iteration, critical nodes must participate in scheduling, or
otherwise, corresponding tasks or processors to critical
nodes cannot satisfy their timing constraints, namely
constraints (5.1) and (5.3). By postponing task
scheduling, idle time segments of processors in schedule
period, which are used to schedule non-migratory tasks,
will connect together, leading to minimum preemption
and voltage-level switches for non-migratory tasks.
The first two lines of Algorithm 1 force the schedule to
be composed exclusively from migratory task segments. In
each iteration, prevX contains the edges from the previous
iteration and nextXholds the current set of edges. Each edge
in the sets indicates the mapping of one task from migratory
task set to one processor from the processor set. At the
beginning of each iteration, current full machines and urgent
tasks is identified. Then, if there is no urgent task or no full
machine, the task to processor assignment is postponed as
late as possible. Otherwise, based on Algorithm 2, a task to
processor assignment with the minimum possible changes
(with respect to the immediate previous iteration) will be
obtained.
After finding χ, for each (Ti , M j )   , an arbitrary task
segment TSijl is scheduled in the interval [   ,  ) , i.e., task
Ti is scheduled on machine Mj at voltage-level Vjl from γ – σ
to γ. σ defines the interval length, and respective procedure
to calculate it is discussed in Section 5.2.2. At the end of
each iteration, we change the remaining range of scheduling
by setting γ to γ – σ; decrement each t'ijl by σ for the
scheduled task segments TSijls; and replace the set of edges
used in the previous iteration with the set of edges obtained
in the current iteration to determine the matching χ in the
next iteration. Iterations will be stopped when γ becomes
zero. Based on this approach, we select TSijl which was
scheduled in the immediate previous iteration. This strategy
leads to less preemptions, migrations and voltage-level
switches. Next section describes the implementation of the
approach used to find the matching.

5.2.1. Finding the Tasks
Assignment in Each Iteration

to

Machines

To find task to machine assignment (called matching χ in
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Algorithm 1), in each iteration, we define a graph with
m vertices for full machines and the machines that are
adjacent to urgent tasks and n vertices for the urgent tasks
and adjacent tasks to full machines. We refer to the vertices
corresponding to full machines as well as urgent tasks as
critical vertices. In the graph, vertex of each task T is
adjacent to vertex of machine M if there is a segment of a
migratory task TS for some values of l while t > 0.
Therefore, matching functionχ corresponds to a minimum
weighted bipartite matching which covers all critical vertices
on the resulting bipartite graph by using as much edges as
possible from previous iteration matching. Now, we describe
the procedure to find this matching.
First, the adjacency matrix for migratory tasks and
machines is initialized. Using the adjacency matrix, a
bipartite graph is built which its vertices are full machines
and machines which are adjacent to urgent tasks in one part
and urgent tasks and adjacent tasks with full machines at the
other part. Then, in Lines 13 and 14 from Algorithm 2, we
add edges to set E if there is adjacency between the
corresponding vertices. Then a network flow graph will be
built from the bipartite graph. For this purpose, two
additional nodes are inserted in the bipartite graph node set.
The first node, namely the source node will be connected to
all task nodes. Similarly, the second node, i.e. the sink node
will be connected to all processor nodes. Positive supply
value of 1 will be assigned to the nodes which fall in the
category of urgent tasks (supply node).
Also, negative supply value of 1 is assigned to each full
machine nodes (demand nodes). To keep our special
minimum cost network flow model solvable, the sum of
supply and demand flows must remain equal. In this regard,
additional flow, which is equal to the difference of supply
flows and demand flows, will be added to the source or sink
nodes. All arcs have capacity of one except arcs between
source node and urgent task nodes and arcs between full
machine nodes and the sink node, which their capacity is set
to 0. Arcs which are connected to source and sink have the
cost of 1. The costs of other arcs are determined by the
algorithm presented in figure 6.
This algorithm assigns cost a to arcs which are selected in
the previous iteration and have the most importance. It
assigns cost b to second most importance arcs, the arcs for
which one of its adjacent nodes belongs to category of urgent
tasks and the other is a full machine. The costs of all
remaining arcs which have the least importance are set to c.
Although the exact values of a, b, and c depend on the size of
the problem, but the relation a b c holds among them.
These values should be selected in such a way that enables
the matching to select as much as possible arcs with higher
priority while finding the minimum total cost. Obviously, it
is possible to leave some arcs with costs of a or b uncovered
in the matching due to the problem constraints which prevent
overlapped execution of difference segments of each task.
As shown in Algorithm 3, cost function is used for
assigning edge cost and is computed according to the set of
input parameters including E, U, F, and prev X. By solving
minimum cost network flow problem, if flow of every urgent
task and full machine nodes are zero, then it represents a
matching that covers all urgent task and all full machine
nodes. Otherwise, in each iteration, flow value of source
node will be incremented by 1 and flow value of sink node
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will be decremented by 1. This loop will be terminated by
finding a matching that covers all the full machines and
urgent tasks. In such a matching, flow of every node equals
to zero. Proof of the fact that such matching always exists
and so the loop will be stopped eventually is an extension to
what proposed in [32] and is described below.
Algorithm 2. Matching χ
1.
2.
3.
4.
5.
6.
7.
8.
9.
10.
11.
12.
13.
13.1.
13.1.1.
14.
14.1.
14.1.1.
15.
16.
17.
17.1.
18.
18.1.
19.
20.
21.
22.
23.
24.
25.
26.
26.1.
26.2.
26.2.1.
26.2.2
26.3
26.3.1.
26.3.2.
27.

Matching χ :
{
Input: prevX
Output: X // a set of edges
Matrix T ′
// adjacency matrix where n′ and m are the
numbers of migratory tasks and processors
If ∑ t ′ >0 then T i, j =1
Else T i, j =0
// create a bipartite graph
VT
VT | T isurgenttaskorataskthatadjacenttoatleastonefullmachi
VP
VP | p isfullmachineoraprocessorthatadjacenttoatleastoneurg
V = VT VP // a set of vertex
E= ; // a set of edge
For T U
For all P Processors
E
VT , VP and Capacity VT , VP =1
IfT i, j =1 then E
For p F
For all T tasks
E
VT , VP and Capacity VT , VP =1
If T i, j =1 then E
// convert bipartite graph to network flow
V
V
VS
V ; // add source and sink nodes to graph
VS , VT
For all VT : E E
1
If (VT U) Capacity VS , VT
VP , V
For all VP : E E
1
If (VP F) Capacity VP , V
// Edge cost definition
Assign edge cost // cost function in Algorithm 3
IF(VT U) Flow[VT ]=1
IF(VP F) Flow[VP ]=-1
IF(|U| |F|) Flow[V ]=|F|-|U|
Else Flow[VS ]=|F|-|U|
E′
; // a set of edge
while (true)
E ′ Solution Flow, V, E, C // Solution function returns set of
edges of the minimum cost network flow
If ( t U , exist one edge e=(VT , VP ) E ′ ) And ( p F ,
exist one edge e=(VT , VP ) E ′ )
X={ (VT , VP ) | (VT , VP ) E ′ }
Return X
Else
Flow[VS ]++
Flow[V ]-}

Algorithm 3. Cost Function
1.
2.
3.
4.
4.1.
4.2.
4.3.
4.4

Cost Function :
Input : E, U, F, prevX
Output: C // The matrix C indicates the cost of edges
For each (VT , VP ) E
If (VT , VP ) prevX then C(VT , VP ) = a
Else if T U and P F then C(VT , VP ) = b
Else if T U then C(VT , VP ) = c
Else if (P F) then C(VT , VP ) = c

As we know, a matching which covers all critical vertices
can be obtained through the following steps:
 Find a matching from all urgent tasks to machines,
namely a bijection χT : U R U , R U M, using standard
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matching algorithms for bipartite graphs,
 Find a matching from all full machines to tasks,
namely a bijection χM : F RF , RF T, using standard
matching algorithms for bipartite graphs,
 Mixing χT and χM using the algorithm shown in
Algorithm 2 (known as Algorithm 2) to obtain a
matching that covers all critical vertices.
Algorithm 4. Finding χUsingχT and χM
1.
2.
2.1.
2.2.
3.
3.1.

χ
; // Domain(χ) = Range(χ) =
For each Ti U  Domain(  )  Range(  M )

Add (Ti ,  T (Ti )) to χ
Remove ( T (Ti ), X ) from χM , if there exists
For each ( X ,Y )   M
Add (Y , X ) to χ

It can be shown that for each arbitrary S U,|N S | |S|,
where N(S) is the set of machines, which their corresponding
vertices are neighbors of vertices of S in the bipartite graph.
Thus, Hall’s condition [45] holds and therefore χT and χM
exist. In order to prove that |N S | |S|, we consider the set
of all the remaining parts of task segments TSijl, i.e. t'ijl, so
thatT S. Since each T S is urgent, we can conclude:
 )
| S |   Ti S (M j N ( S ) lkj1tijl

(8)

Also, it is trivial that
 )  M j N ( S ) (Ti T lkj1tijl
 )
Ti S (M j N ( S ) lkj1tijl

(9)

Considering that no machine can execute tasks with total
execution times greater than γ, we can conclude:
 ) | N ( S ) | 
M j N ( S ) (Ti N ( N ( S )) lkj1tijl

(10)

From (8), (9), and (10), we find that|N S | |S|.
To mix χT and χM, in each iteration of Line 2 of
Algorithm 4, an urgent task and its paired machine in χT,
namely (Ti ,  T (Ti )) , is added to χ, and therefore, Ti is added
to Domain(χ) and a task will be removed from U–Domain(χ)
–Range(χM) for the next iteration of the algorithm. Moreover,
considering a task X, removing (  T (Ti ), X ) from χM, if it
exists, removes X from Range(χM). If X is an urgent task,
anew member is added to U–Domain(χ)–Range(χM) for the

(a) Iteration 5
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next iteration. This ensures that we do not ignore the urgent
task X and thus, this task will be checked in further
iterations.
In Line 3 of Algorithm 4, full machine vertices are
covered either in χ or in χM. It can be described as follows:
considering a machine X, if pair (X, Y), where Y is a task, is
removed from χM, a pair (Z, X), where Z is also a task, is
added to χ. Furthermore, no urgent task vertex remains
uncovered in χ unless it has been covered in χM owing to the
condition of Ti  U  Domain (  )  Range (  M ) in line 1 of
Algorithm 2. Therefore, through adding task-machine pairs
of χM to χ, we can claim that χ covers all full machine as well
as all urgent task vertices.
For clarifying the matching algorithm, figure 4 displays
snapshots of execution of matching for Example 1 at the end
of fifth and sixth iterations. Red nodes represent critical
nodes. Each edge is labeled ‘X/Y’ where X and Y denote the
capacity and cost of the edge, respectively. Edges which are
chosen to carry flow are drawn in red. The set of red edges
between machines and tasks, which are passed across an
ellipse as well, compose our desired matching.
As it has shown in figure 4, after selecting the edges
(T1, P2), (T3, P4), (T6, P1) as a final solution in iteration 5, the
cost of edges (T3, P4), (T6, P1) has decreased to increase the
probability of their selection in the current iteration. It should
be noted that selecting the edges which were selected in the
previous iteration leads to lower number of preemptions,
migrations and voltage-level switches.

5.2.2. Finding the Value of
The remaining part of the scheduling for an iteration of
Algorithm 1 is to specify the length of time in which this part
of scheduling is done. Based on the work in [32], value of σ
is the largest value satisfying the following three conditions:
1. For each assigned task segment TSijl, we need to have:


  tijl

(11)

This ensures that Ti has enough work to be done on Mj at
voltage-level Vjl for σ amounts of time in γ σ, γ and

 0
tijl

(12)

holds for all task segments in the next iteration.

(b) Iteration 6

Figure 4. Snapshots of matching algorithm (iterations 5 and 6 from example 1)
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2. For each migratory task Ti that have not been mapped,
we need
∑

∑

(13)

This condition ensures that Ti remains non-urgent
throughout interval γ σ, γ and
 
mj1 lkj1tijl

(14)

holds for Ti in the next iteration, i.e., the required amounts of
time for executing the remaining parts of task segments of Ti
are available.
3. For each machine Mj which have not been allotted,
we need
∑

γ

∑

(15)

This ensures that Mj remains non-full throughout interval
σ, γ and

 
in1 lkj1tijl

(16)

holds for Mj in the next iteration, i.e., in the iteration that the
required amounts of time for executing the remaining parts
of segments of migratory tasks on Mj are available.
In other word, scaled tasks can be scheduled on the
allocated machines unless one of the following Types of
Changes occurs in the status of the system:
 Type A, shown as A(TSijl): A task segment TSijl is
assigned to the proper machine at the proper voltage-level
for the length of t'ijl,
 Type B, shown as B(Mj): A machine Mj becomes full,
which is equivalent to adding a critical vertex
corresponding to the machine in the bipartite graph,
 Type C, depicted as C(Ti): A task Ti becomes urgent,
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which is equivalent to adding a critical vertex
corresponding to the task in the bipartite graph.
At the end of each iteration of Algorithm 1, at least one
type of the changes occurs. Thus, we need to find a new set
of task segments to be scheduled for the next iteration.
It should be noted that when a change of Type A (e.g., A
(TSijl)) occurs as the sole change at the end of an iteration, if
there is a task segment TSijl' the previous matching can be
used with only a voltage-level switching, e.g. from Vjl to Vjl',
for the new iteration. Doing so, we can effectively reduce the
number of preemptions. However, if there is no other task
segment TSijl', an edge is removed from the bipartite graph
and we need to find a new matching.
When t'ijl is decremented by the amount of σ for each
assigned task segment TSijl, it can be concluded for each
migratory task Ti that
  ei
mj1 lkj1 Sijl  tijl

(17)

where e'i is the remaining execution requirements of task Ti
for the next iteration. In addition, with this reduction in the
values of t'ijls, it is trivial that (14) also holds for urgent tasks
and (16) holds for full machines. In fact, (12), (14), (16), and
(17) are corresponding to Constraints (5.4), (5.3), (5.2) and
(5.1), respectively. This suggests that, in each iteration, it is
ensured that all corresponding constraints to primitive
constrains on migratory tasks and machines are held. Since at
least a Change of Type A, B or C occurs at the end of each
iteration, Algorithm-I terminates because of finiteness of the
number of thesechanges. Next,in the last iteration, the
remaining execution requirements of each migratory tasks
gets zero. The reason is that, according to (12), (14) and (16),
all t'ijls eventually turn into zero. Thus, it is verified that
Algorithm 1 schedules the segments of migratory tasks in a
proper manner.

Figure 5. Assigning migratory tasks in the boundaries of a SP

Figure 6. Migratory task segment placement
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Example 2. After obtaining the task segments in Example 1,
here figure 5 shows how segments of migratory tasks are
assigned to the parallel machines in the boundaries of a SP.
The change types occurring at the end of iterations are also
shown.

5.2.3. Schedule Period Placement
In the next step, we schedule migratory tasks in entire hyper
period. For further improvement in the number of migration
and preemption and voltage-level switches, algorithm 5 as
shown in Algorithm 5 is proposed.
Algorithm 5. Schedule Period Placement
1.
2.
2.1.
2.1.1.
2.1.2.
2.2
2.2.1.

SPU : Schedule set for a SP with unit length
for i 1 to N // N=number of all SPs in hyperperiod
if i is Odd
SPU′ : mirror(SPU )
Scale SPU to SP
else
Scale SPU to SP

In algorithm 5, SPU is a data structure that holds the
scheduling of migratory tasks. Each SPU object specifies a
processor, an execution interval, and a voltage-level for a
single task. For any schedule period, the proportionally
scaled unit SP is repeated. Function mirror (SP) will reverse
the scheduling order for the given SP and is applied to
schedule periods of odd index which merges free spaces of
adjacent SPs while decreases the number of preemptions and
voltage-level switches for non-migratory tasks. It also makes
the migratory tasks at the end of SP to repeat in the start of
next SP which causes reducing the number of migrations,
preemptions and voltage-level switches. A similar technique
is used in [46] to decrease the number of preemptions.
Example 3: Figure 6 shows the placement of migratory task
segments to the parallel machines after applying the mirror
procedure on the schedule of Example 2.
Briefly, we use the scaled version of the obtained
schedule of a SP of unit length by the factor of | SPk | beside
its mirror to schedule migratory tasks in SPk, and thus,
achieve a feasible scheduling for the migratory tasks in a
hyper period. In this regard, each machine will have some
idle intervals in which some non-migratory tasks can be
scheduled. In the next subsection, we describe the method of
scheduling segments of non-migratory tasks within these idle
intervals. As a matter of fact, it is not vital to schedule
migratory and non-migratory tasks through different
algorithms, or even in different phases like the approach
discussed in [32]. We could use Algorithm 1 to schedule
both migratory and non-migratory tasks simultaneously.
Such possible scheduling suffers from high overhead; hence,
in order to reduce the number of preemptions as well as
voltage-level switches, we schedule segments of nonmigratory tasks separately after all migratory task segments
have been scheduled. More details are presented in the
following section.

5.3. Scheduling Non-Migratory Tasks
The main point about scheduling non-migratory tasks is that
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we are not concerned about the parallel execution of job
slices of any such task. In addition, each task segment TSijl of
non-migratory tasks can be executed in SPk during the
machine idle periods for tijl  | SPk | after scheduling migratory
tasks, as the LP constrains (Constraint (5.2)). By scheduling
in this way, each task token would meet its fluid path at the
end of each SP, and therefore, no non-migratory task misses
its deadline, i.e. there is a feasible scheduling for them in idle
times of each machine. However, in order to reduce the
number of preemptions and voltage-level switches, we use a
different algorithm for this part. As a result from [53],
algorithms with work-conserving property have the
advantage to avoid unnecessary task preemptions. Hence, we
consider this property for scheduling of non–migratory tasks
that significantly decreases the number of preemptions and
voltage-level switches. Corresponding to each segment TSijl
of non-migratory tasks, we define a release-based-tasksegment (RBTSijl) with size τijl which indicates the amount of
time that task Ti should be executed on machine Mj at
voltage-level Vjl in the task period of length pi, where
 ijl  tijl  pi . We schedule RBTSs per task period instead of
TSs per SP. Also, we use EDF to schedule the RBTSs (i.e.,
for non-migratory tasks) in the idle times throughout each
hyper period. Of course, with employing scheduling
algorithms with lower preemption overheads than EDF (e.g.,
EDZL), it is possible to decrease the number of preemptions
even more. The sum of execution requirements of all RBTSs
of a task Ti (RBTSijl) in a period pi is equal to the exact
execution requirements of task Ti in the period, i.e. ei.
According to Constraint (5.1), we have
mj1 lkj1 Sijl  ijl  ei

(18)

Thus, even if the scheduling strategy is changed, it will
not cause any deadline to be missed while the job slices of a
certain task instance are executed within their respective
period (i.e., their relative deadline). Furthermore, according
to the optimality of the EDF algorithm [23], it is
straightforward to show that EDF gives a feasible scheduling
in the idle times of each machine, if such a schedule exists.
In this regard, as the existence of a feasible schedule for the
task set is verified and confirmed in Step 1 of the scheduling
(i.e., through the LP), it would be sufficient to use the EDF
algorithm while considering each RBTSijl as a task with
execution requirement τijl and period pi. In this way, all the
RBTSs, and equivalently, all the non-migratory tasks are
scheduled. It is worthwhile to note how this method of
scheduling results in fewer preemptions and voltage-level
switches: in the case where two RBTSs, namely RBTSijl and
RBTSijl' exist for a certain task Ti and no new task with an
earlier deadline arrives before the RBTSs deadline, EDF
selects RBTSijl' (which has the same deadline as RBTSijl) for
execution instead of random selection among the other
admissible tasks. In this regard, one voltage-level switch
occurs instead of a preemption.
Example 4. As shown in figure 7, RBTSs corresponding to
segments of non-migratory tasks of Example 1 which listed
in table 1, are scheduled after scheduling segments of
migratory tasks in Example 2. Migratory tasks are shown in
gray color, while RBTSs are represented in other colors.
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Figure 7. Complete scheduling schema over SPs
Theorem 2. The Linear Programming (LP) problem
mentioned in Step 1 has a solution with minimal value of E if
and only if the set of unrelated parallel machines has a
feasible scheduling with minimal average energy usage E.
Proof: It is trivial to show that if there is a scheduling for a
task set, the constraints of the LP would be met; therefore,
the LP has a solution with minimal average energy usage E if
there is a feasible scheduling. By Corollary 1, it is inferred
that minimal average energy usage for scheduling the task set
in a hyper period ( E(H ) min ), and therefore the system
lifetime, is also the minimal average energy usage for
scheduling the scaled task set in a SP of unit length, which is
the minimum value of E in the LP.
To prove the other direction, consider a solution to the
LP. We described how we can use this solution to construct a
schedule for the tasks upon the machines, such that all
deadlines are met. Specifically, for segments of migratory
tasks, we will construct a schedule over the interval [ 0 ,1) . By
Theorem 1, a schedule in which all task instance deadlines
are met may be obtained by repeating the scaled versions of
this schedule over all SPs. Then we have scheduled nonmigratory tasks in the remained idle times. It is mentioned
that non-migratory tasks can be scheduled by the EDF
algorithm without missing a deadline.
Scheduling in this manner results in executing each task
segment TSijl (segments of both non-migratory and migratory
tasks) obtained from the LP, for tijl  H amounts of time
during a hyper period. Therefore, energy usage of the
scheduling is E  H in a hyper period of length H, which
means the average energy usage of the scheduling in that
period, is equal to E . Furthermore, based on Corollary 1,
average energy usage of the system could not be less than the
minimum average energy usage of the scaled task set in a SP
of unit length. Thus, this algorithm gives a scheduling with
the minimum energy usage if the system has a feasible
solution.

6. Discussion
In this section, we first determine the number of migratory
tasks based on some properties of the linear programming,
and then, we specify an upper bound on the number of
preemptions and voltage-level switches.

6.1. Linear Programming and the Degree of
Migration
The cost of migration might be inevitable in some distributed
systems since the whole task state must be migrated as well.

However, the proposed algorithm schedules most tasks on
only one processor, and bounds the number of migratory
tasks. The total number of edges in the bipartite graph at the
first iteration of Algorithm 1 is a measure to find out how
much the schedule is global rather than partitioned (degree of
migration); a schedule in which the number of segments of
migratory tasks is equal to zero is a purely partitioned
schedule [32]. This measure can determine the degree of
migration as discussed in the following.
As shown in [47] and [48], there are polynomial-time
algorithms for solving LPs as well as polynomial-time
algorithms (e.g., see [49]) for obtaining a basic solution,
given a non-basic optimal solution to a LP problem.
Therefore, a basic solution can be obtained in polynomialtime. Considering a LP with n variables, I inequality
constraints and E equality constraints, the basic solution to
the LP problem lies at a vertex point in which n–E
inequalities satisfy as equalities.
Returning back to our problem, we have

N  (n 1)  im1ki

(19)

variables and inequalities (Constraint (5.4)) in the LP. Also,
we have n and m equalities for Constraints (5.1) and (5.2),
respectively, and, n inequalities for Constraint (5.3).
However, according to the m equalities for Constraint (5.2),
we can conclude
mj1(in1 lkj1tijl )  m

(20)

and thus,
in1(mj1 lkj1tijl )  m

(21)

Consequently, at most m number of the tasks can be
urgent (satisfy inequalities of Constraint (5.3) with equality).
According to the mentioned property of LP, N–n–m
inequalities would be marginally satisfied. As shown above,
at most m inequalities for Constraint (5.3) can satisfy as
equalities. Thus at least N–n–2m of inequalities of Constraint
(5.4) is held in the form of equalities.
This means that there are at most n+2m non-zero
variables at the optimal point. On the other hand, because
each task T (i > 0) must have at least one non-zero variable
t for some values of j and l, we can conclude that n
variables of n+2m non-zero variables belong to different
tasks; therefore, at most 2m extra task segments exists. These
extra segments can result in at most 2m migratory tasks.
Also, there are at most 2m+2m=4m segments of migratory
tasks.
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6.2. Number of Preemptions, Migrations and
Voltage-Level Switches
Regarding the issue that there is no need for voltage-level
switches when a machine is idle (as described in Section 5),
the upper bound on the number of migrations, preemptions
and voltage-level switches can be obtained as follows. The
number of migrations and voltage-level switches for
migratory tasks will be at most equal to the number of
iterations of Algorithm 1 in each machine; because there are
no interruptions in the interval of iteration and the task can
run continuously. The number of iterations of Algorithm 1 is
at most equal to the number of times that one of the change
types A, B, or C occur. There are at most 6m changes,
namely 4m changes of Type A, which is less than the number
of task segments belonging to the migratory tasks, m changes
of Type B, which is less than the number of full machines,
and m changes of Type C, which is less than the number of
urgent tasks.
Therefore, 6m is an upper bound on the number of
migrations and voltage-level switches in a SP for migratory
tasks on each machine, and thus, 6m2 is an upper bound for
the entire system model. On the other hand, using the EDF
algorithm, non-migratory tasks will be preempted only when
a change of Types A, B or C occurs or when a new RBTS
arrives or its execution finishes, considering RBTSs as tasks.
We refer to these two latter cases as Change Type D (times
in which changes of Type D occur, are shown in red color in
Algorithm 4). The number of SPs in a hyper period, which is
at most equal to the number of task releases, is
in1

H
pi

(22)

Therefore, the total number of preemptions for all
machines will be equal to the number of Type A, B and C
changes, which is
(6 m 2 )  in1

H
pi

(23)

plus the number of Type D changes that is
2   RBTS ijl

H
pi

(24)

Furthermore, since there are at most 2m extra task
segments (as mentioned above), the number of RBTSs is not
more than n + 2m, and at least one RBTS for each nonmigratory task exists. This means that:
 RBTSijl

H
H
H
H
 in1  2m
 (2m  1)in1
pi
pi
pi
min( pi )

(25)

Thus, the number of preemptions and voltage-level
switches in a SP using the proposed algorithm is
2  ( 2 m  1)  6 m 2  O ( m 2 ) in the average case. This is
independent of n and much fewer than the preemptions in the
available online algorithms, even for identical platforms
where n m (e.g. [14]).
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7. Experimental Results
This section presents the evaluation results of the proposed
algorithm for synthetic task sets on different configurations
of parallel machines. Since, to the best of our knowledge,
there is no optimal scheduling algorithm for unrelated
parallel machines that support task migration, we compare
EORTSA algorithm with PCG [25] which is introduced for
real-time scheduling on uniform parallel machines.
Most of the optimal scheduling algorithms for
heterogeneous multiprocessors are based on fairness
[25, 32, 50], so the order of the number of preemptions and
migrations of these algorithms is almost the same. These
algorithms proportionally assign processors to the tasks
according to the utilization rates. Among them, PCG is an
optimal scheduling algorithm which is insensitive to the
energy usage. PCG has the least number of migrations and
preemptions in the class of optimal scheduling algorithms in
uniform parallel machines which make it a good choice to
compare with preemptions and migrations of EORTSA. On
the other hand, since EORTSA scheduling algorithm is
optimal regarding the energy usage, we have omitted the
comparison of EORTSA with other existing algorithms
which intend to reduce the energy.
Although the proposed algorithm supports all types of
machines, it was restricted to uniform parallel machines in
experiments. We have considered four uniform parallel
machines with 2, 4, 8 and 16 XScale PX270 processor cores.
Since this processor supports multiple DVS voltage-levels, it
is possible to create a uniform parallel machine consisting of
cores with different execution speed by assigning different
voltage-levels to cores accordingly. We have used data from
table 6 to create such parallel machine in which every core
works at a fixed random voltage and corresponding
frequency. Also, it can be observed from table 6, there is a
linear dependence between the speed and the power,
meaning that by doubling the speed, power consumption will
increase approximately twice.
With such restriction, it is hard to reveal the potentials of
our algorithm in reducing power consumption during the
evaluations. Our algorithm achieves much more energy
saving for unrelated platforms rather than uniform ones, as
power consumption relates to execution speed through a
nonlinear function and is task-dependant. To reflect the
nonlinear relation between power consumption and execution
speed, which is most common in unrelated platforms, a
custom uniform platform with nonlinear power-speed
relation is modeled using the following assumptions:
 Tasks are assumed to have the same functionality but
with different input sets,
 Task execution times are calculated for different
processors and are normalized based on the execution
speed of the slowest processor,
 Task execution time on different processors is based
on E3S benchmark suite [51].
Since we only have one type of the task on the system,
this unrelated platform can be considered as a uniform
platform. Now, PCG algorithm can schedule the tasks in this
new platform. Tables 6 and 7 report the average powers and
relative speeds of some processor cores for different
operating frequencies. Although actual power and relative
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speed values vary depending on the tasks, these values can
be used as a guideline for our constructed platform.
Linear program and minimum weighted bipartite
matching problem (via minimum cost network flow) are
modelled and solved in ILOG Cplex solver [52].
Table 5. Specifications of the Intel XScale PXA270
processor [7] for different speeds
Speed
(MHz)
Normalized
speed
Active
power
(watts)
Idle power
(watts)

104

208

312

416

520

624

0.5

1

1.5

2

2.5

3

0.116

0.279

0.390

0.570

0.747

0.925

0.064

0.129

0.154

0.186

0.222

0.260

Table 6. Speed and power of executing text processing
benchmark on different processors according to E3S
benchmark suites [47]
Processor model

Speed

AMD ElanSC520-133 MHz
AMD K6-2E 400MHz/ACR
AMD K6-2E+ 500MHz/ACR
AMD K6-IIIE+ 550MHz/ACR
IBM PowerPC 405GP - 266 MHz
NEC VR5432 - 167 MHz

3.0
1
1.75
2
1.75
0.16

Active
power
(watts)
1.6
10
14
16
2
2.5

Idle
power
(watts)
0.16
1
1.4
1.6
0.2
0.25

We conducted several different experiments to evaluate
the average power, number of preemptions and number of
migrations of the above-mentioned scheduling algorithms.
As stated before, the evaluation has been performed on
synthetic task sets. These tasks have been generated
randomly in the following manner. First the utilization value
of each task has been generated randomly such that the
system utilization reaches to a target value determined in the
experiment setup. In order to avoid unaffordable hyper
period length in simulation, we use the following approach
for generating of task periods. First an integer number which
has at least 150 divisors is randomly selected as the hyper
period value. After that, the task period will be chosen from
the set of those divisors. In this way, we have restricted the
periods to integer numbers. And finally the execution time is
calculated using e p u .
In each experiment, system utilization has been
considered in the range of 10% to 100% (with step 10%).
Each experiment setup has been repeated 100 times. Then,
the impact of utilization on the performance metrics has been
observed. These performance measures are Average Number
of Migrations and Preemptions per job (ANMP) and the
average energy usage as reported in the other researches in
the literature.
Figure 8 shows ANMP as the vertical axis according to
different system utilizations (horizontal axis). Also in this
figure, the comparison of the number of preemptions and
migrations for different task set sizes (10, 20, 30 and 40) has
been reported. In this figure, when there are 10 tasks in the
system and the utilization is higher than or equal to 60%,
PCG algorithm has less preemptions and migrations than
EORTSA (it is about 33% of EORTSA). In fact, since
EORTSA aims at minimizing the energy, it may lead to
higher ANMP in comparison with non-energy minimizing
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and general scheduling algorithms. Consequently, in the
loads near 100% in which the opportunity of saving energy is
limited, EORTSA is less effective than non-energyminimizing scheduling algorithms such as PCG. However,
when the number of tasks becomes larger (e.g., 20, 30 or 40),
ANMP of EORTSA decreases. The reason is that with larger
number of tasks, each task most likely has smaller portion in
the total utilization of the system so the chance that it is
preempted or migrated becomes slighter. Consequently, the
performance of EORTSA improves when there are a large
number of tasks in the system.
Another important feature of EORTSA is that it keeps the
number of preemptions and migrations under a fixed bound,
i.e. O m , that only depends on the number of processors in
the system. Figure 8 reveals this fact especially when the
number of tasks increases. In a similar fashion, PCG has
considerable amounts of ANMP (see figure 8(d)). Because it
makes proportional assignments on each schedule period, in
the higher task counts, it encounters many task switches.
Besides, EORTSA schedules RBTSs per task period instead
of task segments per schedule period for non-migratory tasks
and always preserves the number of migratory tasks under
twice the number of processors (2m). Figure 9 shows
comparison of power consumption of scheduled task set for
PCG and our algorithm.
Figure 9 (a) presents power consumption for 4 processors
for different system utilizations. EORTSA consumes less
power at different utilizations than PCG. However, when the
utilization is 100%, there will be no difference between the
power consumption of PCG and EORTSA (because all
processors are always busy at that utilization). For EORTSA,
the maximum power saving in comparison with PCG is
achieved when the utilization is around 30% to 70% (see
figure 9(a)) which was about 60% for utilization 30% and
40%.
In the next experiment (Figure 10), we have considered
different number of processors (2, 8 and 16), and for each
setup, two task set sizes have been considered. Similar to our
discussion for the 4-processor setup, by increasing the
number of tasks, EORTSA outperforms PCG in ANMP.
Figure 9(b) shows the average power consumption of each
experiment for 2, 4, 8 and 16 processors. With the increase of
the number of processors, the gap between EORTSA and
PCG also increase because when EORTSA finds more
opportunities to distribute tasks over the processors, it might
find better options to enhance power consumption of the
tasks.
Further, a version of PCG algorithm for unrelated
platform which is aware of different execution speed of tasks
on different processors has been implemented. The modified
PCG has lower schedule ability bound which is depending on
the underlying platform configuration. The reason of nonoptimal assignment of tasks to processors in this extension of
PCG is its greedy assignment which is based on local view of
the system.

8. Conclusions and Future Works
In this paper, we have studied the problem of scheduling a
set of periodic real-time tasks on unrelated parallel machines
among which task migration is permitted. Each processor
(machine) in the system has a few discrete speed levels and
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can employ DVS for voltage and speed scaling. At each
voltage-level, the processor has a maximum speed as well as
a maximum power usage. Further, there exist task-processor
specific speeds which are fractions of the maximum speeds
as well as task-processor specific power usages which are
fractions of the mentioned maximum power usages. A
polynomial-time optimal scheduling algorithm is proposed
which feasibly schedules the set of tasks on the machines
while minimizes the overall system energy usage. We
introduce the first part of the algorithm as a schedule
ability test for unrelated platforms. Also, with multiple
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improvements the number of task migrations and
preemptions and voltage-level switches are reduced to avoid
extra overheads. It is mentioned that the number of migratory
tasks is at most 2m, where m is the number of processors.
Also, it is shown that the total number of migrations,
preemptions and voltage-level switches in each schedule
period is in the order of O(m2).
As an idea for the further work, we intend to extend our
energy model to include leakage power and consider
overheads of migration, preemption, and voltage level
switches in terms of energy.

(a)

n=10, m=4

(b)

n=20, m=4

(c)

n=30, m=4

(d)

n=40, m=4

Figure 8. Average Number of preemptions and migrate onsper job for 4 processors

(a)

For 4 Processors

(b)

Figure 9. Power consumption

Average of all of utilization
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(a)

n=4, m=2

(b)

n=10, m=2

(c)

n=20,m=8

(d)

n=60,m=8

(e)

n=40,m=16

(f)

18

n=120,m=16

Figure 10. Number of preemptions and migrations per job for different processor and task count
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Appendix
List of Symbols
Symbols

Present

T

Set of all tasks

Ti

The ith task in T

pi

Period and relative deadline of task Ti

ei

Execution requirement of task Ti

N

Number of tasks

M

Set of all machines

Mj

The jth machine in M

m

Number of machines

kj

Number of voltage-levels of machine Mj

Vj

Set of all voltage-levels of machine Mj

Vjl

The lth voltage-level of machine Mj

Sjl

Maximum speed of machine Mjat voltage-level Vjl

Powjl

Maximum power consumption of machine Mj at voltage-level Vjl

T0

Dummy task; (its execution is equivalent to be idle)

Pow0jl

Power consumption of machine Mj at voltage-level Vjl when idle

Sijl

Speed of machine Mj at voltage-level Vjl when it is executing task Ti (i> 0)

Powijl

Power consumption of machine Mj at voltage-level Vjl when it is executing task Ti (i> 0)

Eijl(t)
(Ti , M j , V jl , t s , t f )

Energy consumed by machine Mj at voltage-level Vjl when it is executing task Ti (i> 0)for t amount of time
A job slice, that means Task Ti is scheduled on machine Mj at voltage-level Vjl in time interval [t s , t f )

E (a, b)

Minimum average energy usage of M in time interval [a, b)

H

Size of a hyper period

E (H ) min

Minimum average energy usage of T on M in a hyper period

SP

Schedule Period

SPk

The kth SP (the time interval between the kth and (k + 1)th task releases)

| SPk |

Length of SPk

ST

Scaled task

STi

Scaled task corresponding to task Ti

eik

Execution time of the scaled task corresponding to task Ti in SPk

sk

Start time of SPk

tk

Finish time of SPk

E (SP ) min

Minimum average energy usage of scaled task set corresponding to Tin a SP, on M

tijl

The amount of time needed by task Ti to be executed on machine Mj at voltage-level Vjl(LP variables)

TSijl

Task segments corresponding totijl> 0wherei> 0

t'ijl

Size of non-scheduled part of task segment TSijl throughout Algorithm 1

e'i

The remaining execution requirement of migratory task Ti in the ongoing iteration of Algorithm 1

γ

the length of available interval in which the rest of scheduling takes place in each iteration of Algorithm 1

σ

The length of available interval in which scheduling of current iteration is going to be done in Algorithm 1

F

Set of full machines in each iteration of Algorithm 1

U

Set of urgent tasks in each iteration of Algorithm 1

Χ

A matching between machines and tasks that covers all urgent task and full machines

χT

A matching from all urgent tasks to machines

χM

A matching from all full machines to tasks

RU

The range of χT

RF

The range of χM
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Change of Type A

A task segment TSijl is assigned to the proper machine at the proper voltage-level for the length of t'ijl

Change of Type B

A machine Mj becomes full

Change of Type C

A task Ti becomes urgent

Change of Type D

A new RBTS arrives or its execution finishes

A(TSijl)

A Change of Type A on task segment TSijl

B(Mj)

A Change of Type B on machine Mj

C(Ti)

A Change of Type C on task Ti

RBTSijl

Released-based task-segment corresponding to task segment TSijl

τijl

The length of RBTSijl

S

A set of machines that is used in Algorithm 4

N(S)

Set of all neighbours of node S in a graph

prevX

Set of selected edges from the previous iteration

nextX

Set of edges in current edges

U

Set of urgent tasks

F

Set of full machines

T

′

VT
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adjacency matrix where n′ and m are the numbers of migratory tasks and processors
Set of nodes corresponding to urgent tasks or each task that adjacent to at least one full machine

VP

Set of nodes corresponding to full machines or each machine that adjacent at least one urgent task

VS

Source node

V

Sink node
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A complete list of the symbols used throughout this paper is presented in
the appendix at the end of this paper.
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Ab
bstract
Staarted 50 years ago, the field off (system-level) malfunction diiagnosis has exp
panded immenssely and continnues to be a very
y active subfielld in
botth parallel proceessing and depeendable computting research coommunities, wiith much of the new research ccoming from Ch
hina and Taiwaan in
recent years. Thiss paper represeents an attemptt to organize thhe field of reseearch in distribbuted malfunctiion diagnosis via
v an overarchhing,
k, but also foreteells of possible future research
h to fill gaps lefft by
desscriptive, and coonsistent taxonoomy that not onnly covers all of the past work
currrent results andd areas that are just beyond thhe domains alreaady investigateed. The paper iss accessible to ccomputer scien
nce and engineeering
speecialists who aree new to the fieeld, because it uses
u analogies too unveil the natture of the reseaarch problems aand pertinent ch
hallenges.
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ystem-Level Fauult Diagnosis.

1. Introducction
ms in
In the freshmaan seminar “Ten Puzzliing Problem
Coomputer Enginneering,” desiigned 10 yeaars ago and taaught
sinnce by the firsst author [23] [24], mathem
matical and loogical
puzzzles are usedd to introduce advanced science/techno
s
ology
toppics in a maanner undersstandable to first-year coollege
stuudents. Two of
o the seminarr’s puzzle typpes are relevaant to
thee topic of thiis paper. Onee puzzle typee places you on a
rem
mote island innhabited by members
m
of two
t
tribes, TruthT
telllers and Liarss. Truth-tellers provide the correct answ
wer to
anyy question, while
w
Liars alw
ways give an untruthful
u
ansswer.
Meembers of thee two tribes recognize eacch other, butt you
havve no basis to judge whhich tribe a particular peerson
bellongs to, except by analyzzing answers to questionss you
askk. A more advvanced versionn of these puzzzles postulatees the
tribbes Truth-tellers and Randdoms (they liee or tell the truth,
t
com
mpletely at raandom). It turrns out that Randoms
R
are more
diffficult to deall with, becauuse the consisstency of Liaars in
prooviding untrutthful answerss is actually helpful
h
in maaking

dedu
uctions. The latter versioon of these puzzles moddels
diag
gnosis in a disttributed envirronment: You ask each nodde to
perfform self-diagnnosis and repoort the result to
t you. A heallthy
nodee gives you a truthful annswer about it
i being healthy,
wheereas a malfunnctioning nodde gives you an
a untrustworrthy
answ
wer. Is it possible to deduce wh
hich nodes are
malffunctioning based on the rresponses receeived? The shhort
answ
wer is no, if thhere is no crosss-checking off results.
Another
A
puzzzle asks you to imagine n people, moostly
med
dical doctors (MDs),
(
but m
mixed with a small numberr of
impo
ostors, sittingg at a round table. Each person
p
is toldd to
interrview the perrson seated tto his/her rig
ght and rendeer a
judg
gment on wheether that persson is an MD
D or an imposstor.
Let’s assume thatt an MD know
ws how to queestion a personn to
deteermine with absolute
a
certaainty whether that personn is
indeeed an MD. The
T n judgmeents are given
n to you and you
must identify the impostors. Cllearly, a judgm
ment providedd by
an im
mpostor is unttrustworthy, m
much like answ
wers providedd by
Randoms in the previous set of puzzles, not
n only becaause
s/he does not havve the knowleddge to judge, but also becaause
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s/he may actually want to deceive you in order to remain
undetected. This puzzle models the malfunction diagnosis
problem as a directed graph G = (V, E), where vertices in V
are intelligent nodes capable of testing each other and edges
in E define a testing relation, with the directed edge (u, v)
representing node u testing node v.
Five decades ago, this notion was formalized by
Preparata, Metze, and Chien [27] into what has come to be
known as the PMC model of malfunction diagnosis.
Subsequently, Maeng and Malek [19] [20] devised a
different formal model in which diagnosis is based on a
managing unit comparing responses from two other units to
which it is connected, concluding that the two responding
units are healthy if their responses match and at least one of
them malfunctioning otherwise. The model was subsequently
refined and given the name MM* or comparison-based
malfunction diagnosis model. As before, if the test manager
is itself malfunctioning, no reliable conclusion can be
reached.
An unfortunate side effect of the rapid advances in the
field of distributed malfunction diagnosis is the emergence of
a rather non-descriptive, and at times misleading,
terminology. To cite one example, the two terms t/kdiagnosability and t/s-diagnosability mean different things,
and the distinction of k versus s is lost when the parameters
are replaced with actual numbers in a specific case; e.g., is
5/6 diagnosability of the first kind (t = 5, k = 6) or of the
second kind (t = 5, s = 6)? Furthermore, the qualifiers “onestep,” “sequential,” and “pessimistic,” applied to some kinds
of diagnosis strategies discussed are rather undescriptive.
In this paper, we propose a taxonomy of malfunction
diagnosis methods to facilitate understanding and
contributing new results to the field. As a byproduct of the
taxonomy, we expose certain areas of the field that need to
be studied or explored in greater depth. This is not intended
to be a complete survey of the field, as there have been
literally hundreds of research contributions in the area of
malfunction diagnosis over the past five decades. References
cited are meant to cover pioneering contributions that have
defined the field as a whole or its various sub domains, or
have introduced new concepts, plus a few sources that
support our contention that a new, descriptive nomenclature
and taxonomy is indeed required.

2. What Is Malfunction Diagnosis?
Fault testing and fault diagnosis have been with us for
centuries in connection with gadgets and systems whose
designs are to be verified at the outset and whose correct
functioning must be ascertained in the field as they are put to
use. The term “fault” is a bit overused, as it has been applied
at various levels of a digital system hierarchy, from devices
and circuits to sizable modules incorporating hardware and
software components. Fault testing in circuit and logic entail
different methods than testing of higher-level modules. In
fact, in modern practice, we often don’t care about
diagnosing a fault (identifying its location) within a circuit,
say, a chip. Rather, we perform what is known as a go/no-go
test that merely indicates whether the circuit is usable,
replacing the entire circuit in case of a no-go result.
At the system level, by contrast, we do want to identify
which module is causing problems, so that we can isolate and
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eventually repair/replace it. This requires a more elaborate
diagnostic testing, instead of the go/no-go variety. For this
reason, the term “system-level fault diagnosis” has been used
for the latter situation. In the first author’s nearly completed
book on dependable computing [25], the term “malfunction
diagnosis” is used to refer to the context above, avoiding the
overuse of the term “fault” and obviating the need for the
qualifier “system-level.” So, our “malfunction diagnosis” is
“system-level fault diagnosis” in much of the published
literature. This use of malfunction diagnosis is the first
element of our nomenclature and taxonomy.
Let us begin with the basic terminology and assumptions.
We consider a system composed of interconnected,
intelligent modules, where by intelligent we mean modules
with internal processing and decision-making abilities. This
isn’t a restrictive assumption, as modern digital systems are
composed of interconnection of processors, memory
modules, I/O units, and the like, each having hardware
control for basic functions and software control for functions
that are not speed-critical and/or need flexibility over time.
Each module is assumed to be capable of running a
sophisticated self-test routine, when prompted, and to report
the result to other modules.

3. Reflective vs. Comparative Models
Throughout our discussions, each test is assumed to return a
yes/no value, indicating that all is good (yes = 0) or
something is wrong (no = 1). If there are q tests, then the
syndrome is a q-bit vector S with S[j] holding the result of
test j. The diagnosis problem is to deduce from the binary
syndrome vector S[1:q] the diagnosis vector D[1:n]
reflecting the health (0) or non-health (1) of each of the n
modules in the system.
In the reflective mode of diagnosis, known in the
literature as the PMC model [27], when a module is
connected to another module, we assume that one is capable
of testing the other one. Actually, not all links may be usable
as testing links and a sub graph of the directed graph
representing the system may be designated as the testing
graph. In fact, the connectivity of the system may be
completely different from the testing graph. It is possible, for
example, for the n nodes to be connected via a bus, so that
each node can potentially test any other one. This situation
can be represented by Kn, the n-node complete graph,
assuming that the single bus cannot be a source of problems
in testing; that is, it is modeled either as a malfunction-free
system core or a set of n(n – 1) independent directed
channels.
From now on, we focus on the testing graph only and
ignore the fact that there may be other links in the system
besides those used for testing or that the hardware
connectivity may in fact be less dense than the testing graph.
The nature of the test can vary, from significant interaction
of passing back and forth test patterns and test outcomes to
minimal interaction, with one module initiating the test
(perhaps by sending a key or seed value) and the target
module carrying out a self-test routine. The key or seed value
serves to ensure that the test result isn’t a constant that a
malfunctioning module may produce by accident or from a
previously stored result in memory, thus compromising
diagnostic accuracy.
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The abstract reflective testing relationship is shown in
figure 1a, where details of how a test is performed are
suppressed and only the yes/no or 0/1 conclusion from the
test is deemed relevant. The comparative testing relationship
can be abstracted as in figure 1b, where a test manager u and
two participants v and w are involved. The node u initiates
the testing and the nodes v and w respond to it by each
sending a test result to u. If the two test results are identical,
u concludes that all is well, producing the decision 0,
provided u itself is not malfunctioning. Non-matching results
lead to the 1 decision by u. If the manager u is
malfunctioning, then we make no assumption about the
decision it might produce [19] [20].
In the reflective model, the tests correspond to the edges
of the testing graph, one test per edge. Thus, we have |E| = q,
the number of tests. In comparative testing, however, triples
(u, v, w) of nodes correspond to tests, with the triples used
pre-defined as part of the diagnostic scheme. Viewed in this
way, we immediately see that the 2-way and 3-way
relationships of reflective and comparative testing can
readily be generalized to higher-degree collaborative testing,
where clusters of nodes perform intra-cluster testing
according to some local schema and the overall result is
deduced from the collection of cluster-level tests. If clusters
constitute replaceable units within our system, then it does
not matter which nodes within a cluster are malfunctioning.
Those can be diagnosed off-line and the requisite repairs
performed in parallel with a new replacement cluster taking
over.

4. One-Step vs. Multi-Step Diagnosis
Conceptually, the simplest diagnostic scheme is when a
single round of q tests are performed and the resulting binary
syndrome vector S[1:q] is used to deduce which nodes are
healthy and which are malfunctioning. When the information
in the syndrome vector is always enough to do the required
diagnosis for up to t malfunctions, we say that the system is
one-step t-diagnosable. Necessary and sufficient conditions
are known for one-step diagnosability, that is, the mapping of
the syndrome vector S[1:q] into the diagnostic vector D[1:n],
which correctly identifies the health (0) or malfunctioning (1)
status of each unit. Theorem 1 represents an example of
theoretical results that are available for practical use.
Theorem 1. An n-unit system in which no two units test
one another, is 1-step t-diagnosable if and only if each unit is
tested by at least t other units.
If, on the other hand, the syndrome vector isn’t sufficient
for full diagnosis but always leads to the identification of at
least h malfunctioning units, h < m, we say that the system is

multi-step t-diagnosable, because once the identified
malfunctioning units have been repaired or replaced, the
resulting system, which now has fewer malfunctioning units,
can be subjected to the same process for identifying
additional malfunctions. The extreme case where each
diagnosis step identifies a single malfunctioning unit is
referred to as “sequential diagnosis.” A system is
sequentially diagnosable if there exist a diagnosis strategy for
it that guarantees the identification of at least one
malfunctioning unit in each diagnosis step. Theorem 2
represents an example of theoretical results that are available
with regard to sequential diagnosis, in this case a sufficient
condition for sequential t-diagnosability.
Theorem 2. An n-unit system is sequentially tdiagnosable if the condition n  2t + 1 holds. A majority of
the n units being healthy is a sufficient condition, but it may
not be necessary.

5. Sensitivity vs. Specificity of Diagnosis
The terms “sensitivity” and “specificity” are taken from the
medical diagnosis domain. Suppose we have a population of
individuals, mostly healthy but containing some who are
afflicted with a particular disease. A medical test exists for
the disease. The test can identify people afflicted with the
disease (positive indication, or 1) and those not afflicted
(negative indication, or 0), but it has some probability of
yielding a false positive (identifying a healthy person as sick)
and a certain probability of yielding a false negative (missing
the detection of a sick person). Such a test is referred to as
“sensitive” if it has a fairly small false-negative probability,
that is, it detects nearly all sick individuals (Figure 2a). The
test is dubbed “specific” if it has a fairly small false-positive
possibility, that is, only a minute fraction of healthy
individuals will be wrongly diagnosed as having the disease
(Figure 2b).
In the context of studies on malfunction diagnosis, false
negatives have not been allowed so far. Put another way, the
diagnosis outcome can have healthy nodes marked as bad
(this is a safe situation) but no malfunctioning node is
allowed to be misidentified as healthy. However, there is no
fundamental reason for excluding false negatives, if the
system has some built-in malfunction tolerance capability
that allows it to function correctly in the presence of a very
small number of malfunctioning units. Such a system will
use a combination of malfunction masking and malfunction
diagnosis to continue correct operation in the presence of
some malfunctions, aiming to remove malfunctions that put
it over its tolerance capacity.

I think v and w are good

I think v is good

u
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0

u

v

=


I think v or w is bad

I think v is bad
u

1

v

(a) Reflective testing (PMC model)

v

w

(b) Comparative testing (MM* model)

Figure 1. Reflective and comparative testing abstractions
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Figure 2. Diagnostic sensitivity and specificity

6.
Unrestricted
vs.
Malfunction Patterns

Conditional

If the subset of m malfunctioning units can be arbitrary, the
diagnosis scheme is unrestricted. This is the default
assumption for any diagnosis scheme in which no restriction
is mentioned.
The main kind of conditional diagnosis schemes studied
thus far is when the m malfunctions are restricted not to
include all neighbors of any node. When all neighbors of a
node are malfunctioning, that node becomes isolated from
healthy units and thus cannot be correctly diagnosed. This
isolation poses a problem for the diagnosis algorithms,
effectively restricting t to at most d – 1, where d is the
minimum node degree, when no false positives are allowed.
Recently, a stronger restriction, requiring each node to have
at least g good neighbors, has been proposed. The g-goodneighbor diagnosability schemes requires each node to have
at least g good neighbors, in which case t-diagnosability for
larger values of t can be ensured. The previously-studied
“conditional” diagnosability corresponds to the special
1-good-neighbor case of this more general scheme.
Unrestricted and conditional diagnosabilities can be
combined in many different ways. For example, it is possible
to prove that certain classes of networks are (t + a)diagnosable, except when the pattern of malfunctions
belongs to some undesirable class, in which case they
become t-diagnosable. In other words, the absence of the
undesirable malfunction patterns increases the diagnosability
extent by a. An example of such combining is “strong
diagnosability,” where the level of diagnosability rises from t
to t + 1 (that is, a = 1 in the formulation above) when every
node possesses at least one healthy neighbor.
Again, more general conditions can be entertained. In a
cluster-based hierarchical network, one may postulate that
not all nodes in any given cluster be malfunctioning, that
each cluster remain connected internally, or that at least one
inter-cluster connection remain intact between any two
clusters. The possibilities are quite varied. In general, a
restriction on the malfunction pattern leads to some increase
in the diagnosability extent.

7. Analysis vs. Synthesis Considerations
Diagnosability problems to be solved are of two types:
analyzing diagnosabilities of known networks, and
synthesizing interconnection architectures with desired
diagnosability properties.
Analysis problem 1: Given a syndrome vector S[1:q],
identify a set M that includes the requisite number of

malfunctioning nodes (m, 1, or some other number,
depending on the model used and the diagnostic strategy).
Note that the suspected malfunction set M may be allowed to
include false positives or prohibited from signaling false
negatives.
In the simplest case, polynomial-time algorithms exist
that take the vector S[1:q] and the testing graph as input and
produce the set M when the set is restricted to contain all and
only the m malfunctioning units. Efficient algorithms exist
for certain other cases as well, though the space of
possibilities has not been exhausted at this writing.
Analysis problem 2: Given a testing structure (testing
graph of PMC, 3-groupings for MM*), identify the extent of
diagnosability in the case of one-step, multi-step (including
sequential), and other strategies for various unrestricted and
conditional patterns of malfunctions.
Much work has been done in this area, including the
derivation of diagnosability results for a wide array of known
and newly proposed interconnection networks. The networks
studied include meshes, tori [1], hypercubes [3] [11] [12]
[14] [26] (or its generalizations [34] [36] [38]), k-ary n-cubes
[1], numerous hypercube variants [16], cube-connected
cycles, OTIS or swapped networks (including the biswapped
variant), Cartesian product networks [1], and many other
regular [5] [6] [18] [35] and hierarchical (multi-level)
networks.
Synthesis problem: Given a desired diagnosability extent,
the number of nodes, and other physical attributes, derive a
testing graph that is optimal in some respect.
The synthesis problem is easy when only diagnosability
is of interest, but becomes very challenging (like most
combinatorial optimization problems) when other criteria are
included.

8. How the Taxonomy Is Used
Our taxonomy essentially entails the mentioning of each of
the four parameters t, Tp, Fp, and Fn in the form of t/Tp/Fp/Fndiagnosability. These parameters also contain information
about whether the scheme is one-step or multi-step
(including sequential) and whether it is precise or
pessimistic. This method of specifying a diagnostic scheme,
including incorporation of the maximum number of false
negatives as the last of four parameters is new. Existing
diagnosis schemes do not allow false negatives (the
corresponding number is 0 in our model), but, as mentioned
in Section 5, there is no fundamental reason to exclude them
forever. In the examples that follow, Fn = 0 and is thus not
discussed explicitly.
The existing models correspond to the following scheme
with our terminology:
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(a) Precise 1-step 5-diagnosability

M

(b) Pessimistic 1-step 5-diagnosability, |M| = t

(c) Sequential 5-diagnosability

Figure 3. Some commonly studied diagnosis strategies and outcomes
V

V

V

M
M

M

(a) Imprecise 1-step 5-diagnosability

(b) Pessimistic 5-diagnosability, |M| > t

(c) Multi-step 5-diagnosability

Figure 4. Examples of diagnosis strategies allowing false negatives and |M| possibly going beyond t.
Precise = No false positives allowed, that is, Fp = 0
Pessimistic = Up to t – m or s – m (with s > t) false
positives allowed
Example 1 (5/5/0/0-diangnosability): Up to 5
malfunctions are diagnosed with no false positives. This
essentially specifies precise one-step 5-diagnosability with
existing terminology (see figure 3a).
Example 2 (5/5/1/0-diagnosability): Up to 5 malfunctions
are diagnosed, with the malfunctioning units identified to
within a set of 5 units (up to 5 true positives and up to 1 false
positive; see figure 3b).
Example 3 (5/1/0/0-disgnosability): One malfunction is
diagnosed in each step, with no false positives. This
corresponds to sequential 5-diagnosability (Figure 3c).
Example 4 (5/2/0/0-diagnosability): Up to 5 malfunctions
are diagnosed, with the bad units identified in 3 steps (at least
2 true positives and no false negative at each step).
And here are a few examples, not yet studied, that entail
false negatives.
Example 5 (5/5/2/2-diagnosability): Up to 5 malfunctions
are allowed, with three of the malfunctioning units identified
in one step to within a set of 5 units (at least 3 true positives
and up to 2 false negatives; see figure 4a).
Example 6 (5/6/1/0-diagnosability): Up to 5 malfunctions
are diagnosed, with the malfunctioning units identified to
within a set of 6 units (up to one false positive; see
figure 4b).

Example 7 (5/2/1/0-diagnosability): Up to 5 malfunctions
are diagnosed in 3 steps, each step identifying 2 true
positives and up to 1 false positive (Figure 4c).

9. Partial Survey of Prior Work
The references at the end of our paper contain a
representative sample of work in the field of distributed
malfunction diagnosis, both early work laying the
foundations and more recent work developed within a mature
field. It would be instructive to categorize these references
with regard to our taxonomy. Tables 1 and 2 show the results
of classification for reflective (PMC) and comparative
(MM*) models of malfunction diagnosis.
Several patterns emerge from the survey of representative
work reflected in tables 1 and 2. First, the synthesis problem
has not received much attention, particularly within the
comparative diagnosis model. Second, multi-step diagnosis,
which is often a more difficult problem from a theoretical
standpoint, has not been the focus of much work. Studies on
single-step diagnosis are dominant, particularly with
comparative methods. High-specificity diagnosis has
received more attention than low-specificity versions.
It is also evident from tables 1 and 2 that the sensitivity of
diagnosis has been completely ignored (this is why our tables
do not include columns for this attribute).
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Table 1. Categorization of prior work on reflective malfunction diagnosis (PMC model)
Reference

Paper’s Aim

Steps

Specificity

Qualification

Citation

Analysis / Synthesis

Single / Multiple

High / Low

Unrestricted / Conditional

[1] Araki & Shibata 2000

Analysis

Single

Both

Unrestricted

[2] Araki & Shibata 2003

Analysis

Multiple

High

Unrestricted

[3] Armstrong & Gray 1981

Analysis

Single

High

Unrestricted

[4] Barsi et al. 1976

Synthesis

Both

High

Unrestricted

[5] G. Y. Chang et al. 2005

Analysis

Single

Both

Unrestricted

[6] G. Y. Chang 2010

Analysis

Multiple

High

Unrestricted

[7] N. W. Chang & Hsieh 2012

Analysis

Single

High

Conditional

[8] Hakimi & Amin 1974

Analysis

Single

High

Unrestricted

[13] Karunathini & Friedman 1979

Analysis

Both

Low

Unrestricted

[14] Kavianpour & Kim 1991

Analysis

Single

Low

Unrestricted

[15] Lai et al. 2005

Analysis

Single

High

Conditional

[16] Lin et al. 2014

Analysis

Single

High

Conditional

[17] Lin et al. 2015

Analysis

Single

High

Conditional

[18] Lin et al. 2016

Analysis

Single

Low

Unrestricted

[26] Peng et al. 2012

Analysis

Single

High

Conditional

[27] Preparata et al. 1967

Analysis

Both

High

Unrestricted

[30] Somani et al. 1987

Synthesis

Single

High

Unrestricted

[31] Somani et al. 1996

Analysis

Single

Low

Unrestricted

[32] Tsai & Chen 2013

Analysis

Single

Both

Unrestricted

[34] M. Xu et al. 2009

Analysis

Single

High

Conditional

[35] L. Xu et al 2016

Analysis

Single

Both

Both

[38] Zhu 2008

Analysis

Single

High

Conditional

[39] Zhu et al. 2014

Analysis

Single

High

Both

Table 2. Categorization of prior work on comparative malfunction diagnosis (MM* model)
Reference

Paper’s Aim

Steps

Specificity

Qualification

Citation

Analysis / Synthesis

Single / Multiple

High / Low

Unrestricted / Conditional

[5] G. Y. Chang et al. 2005

Analysis

Single

Both

Unrestricted

[10] Hong & Hsieh 2012

Analysis

Single

High

Both

[11] Hsieh & Kao 2013

Analysis

Single

High

Conditional

[12] Hsu et al. 2009

Analysis

Single

High

Conditional

[17] Lin et al. 2015

Analysis

Single

High

Conditional

[19] Maeng & Malek 1981

Analysis

Single

High

Unrestricted

[20] Malek 1980

Analysis

Single

High

Unrestricted

[29] Sengupta & Dabbura 1992

Analysis

Single

High

Unrestricted

[36] Yang 2013

Analysis

Single

High

Conditional

[39] Zhu et al. 2014

Analysis

Single

High

Both

[40] Ziwich & Duarte 2016

Analysis

Single

High

Unrestricted
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Other areas where there is no work yet include
hierarchical or cluster-based diagnosis. Numerous
hierarchical or multi-level interconnection schemes have
been proposed based on hypercube [9] and its many variants
[21] [28]. There are also interesting hierarchical
interconnection architectures that are grown from arbitrary
basis topologies. A prime example is the class of swapped or
OTIS networks [22] [37], and their symmetric variants
known as biswapped networks [33], which have been the
subjects of very limited diagnosability studies [32].

10. Conclusion and Future Work
The nomenclature and taxonomy introduced in this paper
puts the field of malfunction diagnosis into a much-needed
order, allowing a uniform formulation of the problems
already explored and the exposure of additional possibilities
not yet investigated. The various diagnostic strategies are
expressed in terms of the four parameters t, Tp, Fp, and Fn
that collectively specify not only the extent of diagnosability
but also whether the scheme is 1-step, multi-step, precise, or
pessimistic in the prevailing terminology.
The idea of allowing false positives in the diagnostic
scheme isn’t new, but the explication of the number of false
positives allowed as a model parameter is helpful and
removes some of the ambiguities in the current
nomenclature. False positives aren’t as undesirable as they
once were, given that the steep reduction in hardware cost
makes system down time considerations much more
important than the loss of a healthy unit. In fact, a unit falsely
identified as malfunctioning may only be lost temporarily,
because off-line testing can verify that the unit is in fact
good, allowing it to return to the spare supply. False
negatives, on the other hand are new to our model. The
presence of some malfunctioning units may be tolerated by a
system’s built-in malfunction tolerance, which may include
replicated computation with voting or data replication with
primary and back-up nodes.
We plan to work on further refining this taxonomy as we
discover diagnostic schemes that it does not properly cover
or see the need for additional expressive power as system
complexity and diagnostic strategies evolve.
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k
Bound on the number of false positives in previous
terminology (our Fp)
M
Set of purportedly malfunctioning units returned by
the diagnosis algorithm; |M| = Tp + Fp
m
Actual number of malfunctioning units, m  t
n
Number of nodes in the network or testing graph
(length of the binary diagnosis vector D[1:n])
q
Number of tests performed in one step (length of the
binary syndrome vector S[1:q])
S
Syndrome binary vector
s
Bound on the size of the returned set M, with s > t
t
Upper bound on the number of malfunctioning
nodes
Tp
Number of true positives (correctly diagnosed
malfunctioning units) by the testing strategy
u
Graph node doing the testing or coordination
V
Set of system nodes, with |V| = n
v
Graph node under test by u
w
Second graph node under test by u in the
comparative model
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Ab
bstract
Deccimal arithmetiic has become a hot research topic
t
in recent years.
y
Many haardware units haave been designned and propossed to perform high
h
perrformance and accurate
a
decim
mal arithmetic operations. Tradditionally, decim
mal arithmetic units
u
have beenn designed as application-spec
a
cific
speecialized hardware modules. But
B there is an em
merging trend towards
t
the dessign and implem
mentation of recconfigurable strructures to perfform
deccimal arithmeticc. This paper contributes
c
to thhis trend by exxploring differeent reconfigurabbility options in decimal addeers, proposing new
reconfigurable parrallel prefix treees (PPTs), and presenting a reeconfigurable combined binaryy/decimal adderr with a variablle input width. Our
anaalysis shows thhat it is possibble to combinee two conventiional PPTs to reach a reconnfigurable versiion with a reaasonable overhhead.
Furrthermore, we will
w suggest tw
wo criteria for choosing
c
whichh PPTs to comb
bine and will compare
c
these ttwo criteria. Ex
xperimental ressults
dem
monstrate that thhe reconfigurabbility in the propposed designs comes
c
at the co
ost of at most 5%
% overhead in aarea.

Keeywords: Deciimal Arithmeticc, Parallel Prefix Tree, Decimaal Adder, Reconnfigurable Harddware, Granularrity.

1. Introducction
Huuman beings have traditioonally used decimal
d
arithm
metic
proobably because of havingg ten fingers. As such, using
u
deccimal arithmeetic appeared to
t be the natuural choice foor the
firsst generation of computers such as ENIAC [1], UNIV
VAC
[2], and IBM 650
6
[3]. Oveer time, however, the deccimal
aritthmetic moduules were graddually replaceed by their eaasierto-implement biinary counterrparts to the extent that binary
aritthmetic becam
me the prevaailing choice for designerrs of
com
mputer system
ms. But theere is growinng evidence that
deccimal arithm
metic is emeerging again in the moodern
com
mputers. For instance,
i
moddern processorrs like IBM Power
andd System z processors [44-7] have sppecialized deccimal
harrdware units.
One of the main
m
reasons for the resurrgence of deccimal
aritthmetic is its accurate reppresentation of decimal flooating
poiint (DFP) num
mbers. In conttrast, a major problem of binary
aritthmetic is its inaccuracy inn representingg some non-innteger
num
mbers such as
a 0.1 that caan cause unaccceptable erroors in
financial and coommercial appplications. Foor instance, itt has

been
n reported thaat in a large teelephone billiing system, ussing
binaary arithmeticc instead off decimal caan result in an
estim
mated annual loss of up too five million dollars [8]. It
I is
safe to say that the
t lower preecision of binary arithmeticc in
certaain applicatioons has becoome an inhiibiting factorr in
mod
dern computerrs that handle those applicattions.
A good eviddence for thhe increasing
g importance of
deciimal arithmetiic in recent yeears is that thee IEEE 754-2008
standard for floating-pointt arithmetic [9] incluudes
speccifications forr handling decimal floating
g-point numbbers.
In this
t
standard,, two decimal number formats
f
for both
b
softw
ware and hardware im
mplementation
ns of deciimal
arith
hmetic are preesented:
Binary
B
Integeer Decimal (B
BID) is propo
osed for softw
ware
impllementations of decimal arrithmetic and
d is used in IB
BM
dec Floats modulles [10], Intell DFP Math Library
L
[11], and
builtt-in GCC DF
FP types [12]]. These impllementations can
elim
minate the inaaccurate repreesentation erro
ors, but they are
usuaally slow and inefficient [133].
Densely
D
Packked Decimal (DPD) is reecommended for
hard
dware implem
mentations of ddecimal arithm
metic and is used
u
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in machines that have dedicated decimal hardware units, like
IBM Power and System z processors [4-7]. These
implementations usually provide both accuracy and
performance [14]. Additionally, the dramatic increase in chip
density has lowered the overall cost of hardware
implementations. Consequently, hardware solutions are
gaining prominence in industry [15].
There is also a recent trend toward the design and
implementation of reconfigurable arithmetic hardware units.
Traditionally, the reconfigurable platforms have been finegrain modules found in commercial Field Programmable
Gate Arrays (FPGA). Fine-grain modules can address bitlevel granularity, but generally suffer from high
reconfiguration overheads. The ultimate design goal would
be to achieve an ASIC-like performance and FPGA-like
flexibility, design time and cost. Therefore, the coarse-grain
reconfigurable units appear to be a promising compromise
between ASIC and FPGA.
While there are numerous studies on various hardware
implementations of decimal arithmetic operations [16-21],
there are only a few works that focus on the reconfigurebility
aspects of designing such hardware. This paper explores
different reconfigurability options and possibilities in
decimal adders. To do so, the idea of combining existing
conventional Parallel Prefix Trees (PPTs) will be considered
first. As will be elaborated in detail, it is possible to combine
two conventional PPTs to reach a reconfigurable version
with a reasonable overhead. In doing so, one has to choose
the original PPTs carefully in order to achieve low latency
and area overheads. As such, we will suggest two criteria for
choosing which PPTs to combine and will compare these two
criteria. Some new reconfigurable PPTs will be introduced
based on these criteria. Another aspect of reconfigurability
can be in the form of varying input size and type. So a
reconfigurable combined binary/decimal adder with a
variable input width will be justified and presented
subsequently.
The remainder of this paper is organized as follows:
Section 2 provides a review of the literature in this field.
Section 3 discusses the proposed reconfigurable architectures
in detail. Synthesis results and their analysis are provided in
Section 4. The paper is concluded in Section 5.

2. Prior Works
There are numerous studies on various implementations of
basic arithmetic operations such as addition, subtraction,
multiplication, and division. Among these studies, some
focus on optimized but inflexible decimal hardware
implementations [19-21] and some present decimal
arithmetic units with some degree of flexibility [22-27]. For
instance, some researchers have focused on efficient
implementations of decimal arithmetic operations on
reconfigurable architectures such as FPGAs. This is because
the FPGA implementation can provide an added flexibility in
terms of compliance with various standards and the desired
objective that the implemented design is trying to reach.
Nannarelli [22], for example, has studied FPGA-based
acceleration of decimal arithmetic operations.
This study shows that applications requiring decimal
operations can be expedited by an arithmetic processor
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implemented on an FPGA board that connects to a computer.
This processor ran a telephone billing application and
achieved a speed-up of around 10 over its execution on the
CPU of the host computer. This achievement is mainly due
to more flexibility in the FPGA implementation with respect
to ASIC design. Vazquez and Dine chin [23] have also
presented a new method for fast implementation of multioperand decimal addition in current FPGAs. This method is
based on pre- and post-corrections of the binary sum. With
the pre-corrections, the hexadecimal carries correctly serve
as decimal carries, which brings about the opportunity to
utilize built-in carry chain in FPGAs. As a result, the authors
have reported that their implementation on a Virtex-6 FPGA
device halves the area and latency of previous reconfigurable
implementations [24].
There are other works that propose reconfigurable
architectures for efficient implementation of decimal
arithmetic. Such architectures may have an inherent
flexibility in terms of the input format and width, or
operands’ radices and implementation. Combined
binary/decimal arithmetic circuits can also be included in this
category. For example, Calderon et al. [25] have proposed a
new adder/sub tractor unit. Their implementation can operate
on sign-magnitude, unsigned, and different complement
representations. Another similar work [26] presented a novel
combined adder/sub tractor arithmetic unit for binary, BCD
(Binary Coded Decimal), and single precision BFP (Binary
Floating Point) representations.
Another example for a fully reconfigurable architecture
specialized for efficient implementation of binary arithmetic
can be found in [27]. This work employs Coarse Grain
Reconfigurable Architectures (CGRAs) which are a
compromise between ASICs and FPGAs since they provide
better computational efficiency compared to FPGAs and
better engineering efficiency compared to ASICs. The
CGRA fabric introduced, called Dynamically Reconfigurable
Resource Array (DRRA), is a parallel digital signal
processing fabric with distributed arithmetic, logic,
interconnect and control resources.
Overall, one can safely say that reconfigurability in
arithmetic circuits may take different forms and shapes. The
previous works have considered some of them. But there is
still room to explore other aspects of reconfigurability such
as hybrid adders that implement more than one Parallel
Prefix Tree (PPT) depending on their configuration, or a
combination of binary and decimal addition with variable
width. These ideas will be discussed in the next section.

3. Proposed Architectures
Addition is a very basic arithmetic operation. Fast adders are
needed in virtually any digital system. They are also
necessary in other arithmetic operations like multiplication.
The speed of an adder is usually governed by its ability to
quickly handle the carry chain. A common structure for fast
computation of the carry signal is called a Parallel Prefix
Tree (PPT). Six conventional PPTs have been introduced in
the past [28-33]. These PPTs differ in terms of critical path
delay, area, fan-out, wiring tracks, and number of levels
(or tree depth). That is why each one may be appropriate in
some applications and inappropriate in others. However,
there are applications in which two or more of these
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conventional PPTs might be helpful or necessary. In such
applications it will be beneficial to have a hybrid
reconfigurable PPT that provides the advantages of more
than one PPT but at the cost of one single hardware. This
idea will be discussed later in this paper.
In all binary PPTs, the inputs are calculated from
x y
p
and gi xi . yi , where x and y are two
corresponding bits of addend and augend. Also, every node
of the tree presents carry propagation (P) and carry
generation (G) signals. The implementation of each node in
the PPTs is shown in figure 1. At the lowest level of trees,
carry of each position is ready to be added to the partial sum
in order to produce the final result.
G”,P”

G’,P’

G G” G’P”
P P’P”
G,P

Figure 1. Implementation of a node in decimal PPTs
The implementation of a decimal PPT is similar to its
binary counterpart, but its inputs, called P and G , are
calculated using the following equations, where p and g are
the corresponding binary propagate and generate signals:

G

g

P

p p p p

g p

g p p

g p p p

(1)

The notion of reconfigurability in adders can take many
different forms. In the next subsections, two of these various
forms and possibilities will be explored: the prospect of
combining two existing PPTs to form a new hybrid PPT that
can be reconfigured into either of its two parent PPTs
whereby providing their advantages albeit with some
overhead; and the possibility of having a binary/decimal
adder with a configurable input width.

3.1. Proposed Reconfigurable PPTs
The proposed reconfigurable PPT in this section can
implement two different types of conventional PPTs such as
Brent-Kung and Han-Carlson. The first question in designing
such a hybrid PPT, is which two PPTs may be combined
efficiently well to compensate for the inevitable
reconfiguration cost. The preliminary answer to this question
might be that trees with equal number of nodes appear to be
suitable candidates. To explore this point, Ladner-Fischer
(L-F) and Han-Carlson (H-C) trees were considered.
The implementations of L-F and H-C PPTs for 16-bit
inputs with four and five levels are shown in figures 2 and 3,
respectively. The gray nodes in both figures have the same
inputs. These nodes can be shared easily in the hybrid PPT.
The white nodes (in figure 2) and black nodes (in figure 3)
have differing nodes in the two PPTs.
As the first step, a combined PPT with the same number
of nodes as the original L-F and H-C trees was formed. This
tree is depicted in figure 4. As this figure shows, the gray

34

nodes require no changes in the data path. However, the
white and black nodes need multiplexers to configure their
varying data path according to the desired configuration.
Needless to say, the multiplexers’ selector signals determine
which PPT is selected but for simplicity, they are not shown
in the figure. Another important point in this figure is that the
number of levels in the combined PPT is the same as the PPT
with the higher number of levels. In this case, since H-C tree
has 5 levels, the combined version also has 5 levels.
Multiplexers usually have considerable area and delay
overheads. If they are implemented using complex gates
(as opposed to transmission gates), their area and delay can
even be more than a cell in the tree. So it seems plausible to
assume that if redundant nodes are used instead of a shared
node and multiplexer(s), the overall delay and area overhead
would be smaller. As such, in the second step, the common
nodes with same inputs (gray) remain intact. But the
differing nodes are placed twice in the reconfigurable design.
The resulting structure is shown in figure 5. In this figure, the
gray nodes are shared between two PPTs whereas white and
black nodes correspond to L-F and H-C PPT’s, respectively.
Notice that the redundant nodes are marked by the same
numbers and only one of them is activated in each
configuration.
The usage of redundant nodes in the PPT shown in figure
5 eliminates the need for the multiplexers whereby
improving the area and delay of the reconfigurable PPT, as
will be shown in Section 4. However, to explore the effect of
structural matching between the original PPTs on the
characteristics of the reconfigurable PPT, the first criterion
used in selecting the basic trees (same number of nodes) was
changed to structural similarity in the structures of chosen
PPTs. The structural similarity was defined as the number of
common (gray) nodes that can be found in the two PPTs. A
careful examination of Han-Carlson and Brent-Kung (B-K)
reveals that for 16-bit inputs, H-C has 32 nodes in five levels
and B-K has 26 nodes in six levels. Figure 6 illustrates the
implementation of B-K PPT.
In order to remain consistent with H-C node numbers, the
nodes are not enumerated sequentially in this figure. Even
though the total number of nodes in the PPTs are different,
but there are 18 common nodes between H-C and B-K. So,
these two were identified as similar structures. The common
nodes were shared in the combined PPT. As for the nodes
with different inputs, if only one input of a node is different
(e.g., node 19), a MUX is used to steer the logic properly.
But if both inputs of corresponding nodes are different
(e.g., node 26), then instead of sharing the node and using
MUX is, both nodes are kept. Figure 7 shows the
resulting reconfigurable PPT that can implement H-C PPT
(with gray and black nodes) or B-K PPT (with gray and
white nodes).
As will be discussed in Section 4, the experimental
results show that this approach provides superior results
compared to the other approaches depicted in figures 4 and 5.
Therefore, one may conclude that if a hybrid reconfigurable
PPT is desired, then choosing the PPTs based on their
structural similarity leads to better designs with smaller area
and delay overheads compared to just considering equal
number of nodes in them. To explore another kind of
reconfigurability, a reconfigurable adder that takes operands
of different types and sizes is introduced next.
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Figure 6. B-K Parallel Prefix Tree (reproduced from [28])
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3.2. Proposed Reconfigurable Adder

0) or decimal
signal “ ” indicates that inputs are binary (
(
1). The design has two distinct parts that can operate

Modern processors are generally designed with a wide
(like 64 bits) data path. A wide data path usually necessitates
a wide ALU as well. For instance, a 64-bit processor requires
a 64-bit adder. Research has shown that there are many
applications in which a sizeable portion of operations are
executed on shorter data structures (such as Smallint) as
compared to longer ones (like Long) supported by the
hardware [34]. The statistics found in literature indicates that
60% of binary operations contained in various applications
such as airline systems, banking, financial analysis,
insurance, etc. use 16-bit Smallint variables and only the
remaining 40% of the operations need 32-bit Integers even
though the processors still have to provide support for 32-bit
operations [34].
In those circumstances, a wide adder is not always
needed and having the option to configure the wide adder as
two narrower adders that can work in parallel can offer a
potentially considerable improvement in terms of throughput
and/or performance. Furthermore, if equipped with power
gating mechanism, the upper half of a wide adder can be
switched off in case only the lower half is used whereby
providing a power saving potential.
There are also many reported scenarios in which the input
of an arithmetic unit might alternate between binary and
decimal. For instance, in applications that provide scientific
and financial services to their customers, the service
providers often use binary arithmetic for the former and
decimal for the latter group of services using the same
(cloud) hardware infrastructure [35]. If only single-type
arithmetic units are available, designers will have to use both
binary and decimal hardware modules simultaneously in
their implementations. A reconfigurable binary/decimal
adder in these cases will certainly be beneficial.
Given these conditions, a new reconfigurable adder is
proposed in this paper. The proposed adder, shown in figure
8, is a combined binary/decimal adder that can operate on
different sizes of operands. In the proposed design, X and Y
represent the binary or BCD digits of two input operands. A

independently or together. Each part can be configured as
either a 4n-bit binary adder or an n-digit decimal adder. If
configured to perform the addition in a cascaded form, the
proposed adder will take the shape of either an 8n-bit binary
adder or a 2n-digit decimal adder. Each part of the design is
n comprised of “dual sum generation” units. The internal
circuitry of these units is illustrated in figure 9 (reproduced
from [36]). In this figure, the squares produce the bit
generate, propagate, and half-sum ( - ) signals and the
circles are ordinary parallel prefix nodes. The dual sum
generation units compute P and G for each decimal digit that
is fed into a quaternary PPT.
Each dual sum generation unit, also provides the result of
its corresponding digit addition in two conditions: If the
carry-in to that position is zero, the result is called S and if
the carry-in is one, the result is called S . In the lower half
adder (the right hand side one), when quaternary PPT
prepares correct decimal carries, the proper sum digit is
selected. However, in the left hand side adder, the problem is
slightly different. An “integrated” signal is defined that
indicates the size of operation. If this signal is equal to one,
two adders are cascaded to perform a 2n-digit decimal or 8nbit binary addition. Otherwise, they implement two
independent additions. The “carry selection” units receive the
carry-out of right hand side adder and produce the correct
control signal for selecting the appropriate sum. figure 10
shows the block diagram of the carry selection unit. In this
figure, P P P … P , where n i 2n.
The proposed reconfigurable adder uses a Carry Select
Adder (CSA) as its basis. This basic adder was chosen
because it has fast implementations in literature. Depending
on the design objectives that one pursues, other types of
adder (such as Carry Skip Adder, Carry Look ahead Adder,
etc.) could also be used in the proposed architecture.
The next section provides the experimental results and
their analysis.

Figure 8. A reconfigurable combined binary/decimal adder
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To analyze the characteristics of the proposed reconfigurable
designs, they were implemented at RT level using VHDL.
The codes were validated using Modelsim. The area and
critical path delay (both in terms of number of gates) of each
design are listed in table 1. The column “Reconfigurability
Overhead (Area)” shows the ratio of the corresponding
reconfigurable PPT divided by the average area of its basic
PPTs. Likewise, the column “Reconfigurability Overhead
(Delay)” contains the ratio of the corresponding
reconfigurable PPT delay divided by the average of its parent
PPTs. As can be seen in the table, considering the structural
similarity (step 3) produces the circuit with the smallest area
with 28% average area overhead. But the minimum critical
path delay and average delay overhead of 10% is obtained
when equal number of nodes in the basic PPTs is considered
(step 2).

Table 1. Comparison between basic PPTs and the proposed reconfigurable PPTs (for 16-bit wide inputs)
Area
(Number of gates)

Reconfigurability Overhead
(Area)

Critical Path Delay
(Number of gates)

Reconfigurability Overhead
(Delay)

Ladner-Fischer (L-F)

128

N/A

9

N/A

Han-Carlson (H-C)

128

N/A

11

N/A

Brent-Kung (B-K)

110

N/A

13

N/A

Combined L-F/H-C (Step 1)

209

1.63

19

1.9

Combined L-F/H-C (Step 2)

170

1.33

11

1.1

Combined H-C/B-K (Step 3)

152

1.28

15

1.25

Parallel Prefix Tree

Basic

Reconfigurable

²

L-F

H-C

B-K

L-F

H-C

B-K

L-F/H-C (Step 1)

L-F/H-C (Step 2)

H-C/B-K (Step 3)

L-F/H-C (Step 1)

L-F/H-C (Step 2)

H-C/B-K (Step 3)
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Figure 11. Area of 16-bit binary adders
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Figure 14. Power of 16-digit/64-bit binary/decimal adders

For more accurate analysis, the designs were also
synthesized based on Nan Gate FreePDK45 Open Cell
Library under typical process and normal operating
conditions using Synopsys Design Compiler tool. The
reconfigurable PPTs were synthesized with multiple target
delays as shown on the horizontal axes of figures 11 and 12.
These vertical axes in these figures represent the resulting
area and power, respectively. The target delays are in the
range of 0.3ns to 1.5ns with 0.1ns increments. If there is no
point in the curves for a specific target delay, it means that
no circuit could be found to satisfy the prescribed target
delay. The curves demonstrate a general congruence with
table 1.
Figures 13 and 14 depict the synthesis results of
combined binary/decimal reconfigurable adder for area and
power, respectively. To comply with IEEE 754-2008
standard [9], the adders are assumed to be 16-digit wide
(when decimal) and 64-bit wide (when binary). The
horizontal and vertical axes are similar to the ones in figures
11 and 12 except that the target delay range has been
modified to 0.7-3ns in order to accommodate for the larger
design in this case. The results are compared with the best
combined binary/decimal adder found in literature [36]. As
figure 13 shows, the area overhead of the proposed
reconfigurable adder is at most 5%. Notwithstanding the
worst case scenario, the average area overhead is far less
than that.

proposed adder were reached with a maximum area overhead
of 5% and average area overhead of 1%.

5. Conclusion
In this paper, different options for reconfigurability in
decimal adders were discussed. To this end, the possibility of
combining two conventional PPTs in order to reach a hybrid
reconfigurable PPT was explored. A few different criteria for
choosing which two PPTs should be combined were
considered and their effect on the resulting reconfigurable
PPT was discussed.
In a different perspective, the concept of reconfigurability
was extended to having an adder with flexible input size and
type. The proposed reconfigurable adder can implement one
2n-digit or two n-digit binary/decimal additions
concurrently. The synthesis results showed that for the same
target delay, the advantages of reconfigurability in the
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bstract
Thee development of systems thhat can characteerize the state of the human is now importtant for many applications. In particular, ass an
inddicator of attenttion and interest, the human gaaze is an imporrtant cue in peo
ople behaviors, personality, inntentions, and activities. Gaze also
playy a crucial rolee in the commuunication proceess. However, in spite of great advances duuring last three decades, curreent gaze estimaation
metthods cannot adddresses required conditions inn this field, e.gg. user head mo
ovements and minimum
m
user ccalibration. Theere have been soome
worrks to resolve such problems but those methhods lack goodd precision. In this work, we have used a m
method for appeearance-based gaze
g
estiimation using convolutional
c
n
neural
networkks, which is muultimodal. This method in ourr implemented setting significcantly outperfoorms
statte-of-the-art meethods.
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1. Introducction
The most impoortant ways of non-verbaal communiccation
connsist of faciall expressions, hands posittion, gestures,, and
gazze. The last one plays a cruucial role wheen people inteeract,
as it is used to regulate
r
the flow
fl
of commuunication, moonitor
feeedback, reflecct cognitive activity,
a
expreess emotions,, and
com
mmunicate the nature of thhe interpersonaal relationshipp [1].
In general, gazze is a veryy strong indiicator for suubject
atteention processs.
In the recentt years, as theere is much riich informatioon in
nonn-verbal cuess, there has been a grow
wing interest from
divverse domain on tools, whiich are able too retrieve the state
of human.
h
Appearance--based gaze estimation
e
which does not need
speecific tools is a hot topic reesearch in com
mputer visionn as it
cann be used for several appliccation domainns, including gazeg
bassed human-ccomputer inteeraction and visual behavior
anaalysis [2].

We
W now knoow that the ddesired gaze consists of two
facto
ors [3] i.e. thhe head posee and the ey
ye locations. The
T
estim
mation of thesse mentioned factors is ofteen achieved ussing
expeensive or lim
miting hardwaare.Therefore,, the problem
m is
often
n simplified by
b either connsidering the head
h
pose or the
eye center locatioons as the onnly feature to
o understand the
interrest of a subjeect [4].
Here,
H
Appeaarance-based 3D gaze estimation
e
iss a
supeervised regression problem in which 3D gaze directioon is
pred
dicted from inpput features, ii.e. a set of an
n eye image annd a
3D head pose. Inn general, thee performancee of appearanncebaseed methods depend on tthe quality and
a
diversityy of
train
ning data and also generalizzation ability of the regresssion
algo
orithm [5].
In
I most of thhe previous studies, evalluation has been
b
cond
ducted using the
t test and traaining data off the same persson,
and this leads to less generalization for
fo the differrent
cond
ditions [6].
This
T paper is based
b
on prevvious work [6] done by Xucong
Zhan
ng, et al .Theey have emplloyed the LeN
Net for the deep
d
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network. They have used cropped eyes and head pose
information directly integrated with EYEDIAP dataset for
the features, i.e. there is no explicit feature extraction phase.
We have deployed the same method except for the
following differences in the setting:
- Extracted head pose information
- Cropped eye images
- Number of training data
- Training parameters
Zhang et al. at Max Plank Institute (MPI) have used
vectors of 2D angle for the head pose, while we have used
vectors of 12, consisting of 9 float numbers of head pose
rotation matrix and 3 of translation matrix.
They also cropped both eyes in one image (Figure 1(a))
whereas we have used both eyes in separate images (Figure
1(b)).
They have only used the screen target sequences and have
not covered floating target data, which are more challenging
and contain many extreme gaze directions, but we have used
all dataset videos, divided for the train, test and validation.
Figure 2. Shows some frames which are not covered by [6].

(a) Both eyes in one image

(b) Left and Right eyes

Figure 1. Example eye images (a) MPI, (b) ours

Figure 2. Example frames not covered by [6]
In this work, we also have used different training
parameters for the deep network, which obviously helped us
to converge better and get better results. The goal here is to
predict the point of regard. i.e. where the participant is
looking at (Figure 3).
Below, we review the related works on gaze estimation
(Section 2) and then introduce used method (Section 3). In
section 4, we talk about details of used method and
experiments. Section 5 consists of conclusion and future
works.
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2. Related Work
The survey by Hansen [1] provides a comprehensive
overview of computer vision methods for gaze estimation. In
general, gaze estimation methods can be further divided to
model-based or appearance-based [1]. Model-based methods
use a geometric eye model and are divided into cornealreflection and shape-based methods, depending on whether
they require external light sources to detect eye features.
Some related works on corneal reflection-based methods
were focused on stationary setting and some more
complicated with arbitrary head poses [6].
On the other hand, the focus of shape-based methods is
on pupil center and iris edges [1]. Zhu et al. [7] used thres
holding for pupil center estimation. Yamazoe et al. [17] also
proposed to fit a geometric model from segmentations of the
eye images. These segments were obtained through simple
thres holding. During the test phase, they used the iris center
derived from a fitted ellipse to infer gaze. Voting-based
methods are also used in edge detection process [8]. The
more complex shape models [9] were proposed to
compensate problems in simple shape-based models, but this
leads to more computation and most of these models need
high-quality images [1]. Some later works in shape-based
methods [10] used the ensemble of Random Regression
Trees for pupil center localization. Strupczewski et al. [11]
proposed different geometric model for webcam eye gaze
tracking.
The most important advantage of appearance-based gaze
estimation methods, which are also known as holistic
methods [1], is that they use eye images as input, therefore
there is potential to work with lower resolution eye images.
Some early works assumed a fixed head pose while newer
works deal with 3D head pose estimation [6].
It is worth mentioning that there is another category for
hybrid models [1]. Some works [12] use methods of
combining shape and appearance or shape and color [13].
Appearance-based methods require larger amounts of
user-specific training data than model-based methods [1] but
it can be compensated with last released datasets, e.g.
EYEDIAP which consists many frames.
Williams et al. relied on semi-supervised Gaussian
Process Regression (GPR) for visual mapping [14]. More
recently, Lu et al. [15] proposed adaptive linear regression
which is based on sparse image reconstruction. Their method
required a fixed head pose. To remove fixed head pose
constraint Lu et al. proposed a Gaussian Process Regression
based pose correcting scheme on top of fixed head pose
model [16]. Funes et al. [17] used RGBD cameras to directly
handle eye appearance variation by generating frontal
looking eye images used as input to adaptive linear
regression.
Some recent works [18]uses egocentric videos and based
on activity, head and hand locations, eye gaze is estimated.
In [19] authors used conditional random field as a graphical
model to map relation between head, human body pose and
face for eye gaze estimation. Mansouryar et al. directly maps
2D pupil positions to 3D gaze directions in scene camera
coordinate space [20]. Feng Lu et al. have employed the
advantages of recent sparse auto-encoding techniques. They
partition any eye image into small patches .Using these
patches they learn a codebook comprising a set of bases,
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which can reconstruct any eye image patch with sparse
coefficients. By examining these coefficients, they can
analyze the eye shape more effectively [21]. Krafkaet. al.
[22] released the dataset of gaze tracking on the mobile
device, called Gaze Tracker. They also have used the
convolutional neural network to estimate gaze of mobile
device user on the screen. They employed eyes, face and face
grid, that is a binary mask used to indicate the location and
size of the head within the frame. They reported a prediction
error of 1.71cm on mobile phone screen according to the
location of the camera.
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We tried to extract three values of angles in addition to
the translation matrix. As it has not been mentioned in the
dataset that what are the right orders of rotations, i.e. x-axis,
y-axis then z-axis, x-axis, z-axis then y-axis, etc. we have
deployed these six possible permutations to find the
corresponding order. We have found that mentioned order
“A rotation of α radians about the x-axis, β radians about the
y-axis, and γ radians about the z-axis” is the right one. So we
tested two scenarios, first the extracted three rotation angles
were concatenated to translation matrix; secondly, we have
used integrated twelve values. Our results showed the later
scenario gives better results. This information used to learn
mapping from eye images and head pose vectors to point of
regard.

3.1. Preparing Data

Figure 3. Illustration of point of regard

3. The Proposed Method
We first convert each video to frames, then eyes are
extracted from frames. Extracted eyes are fed to a
convolutional network. This multimodal convolutional
network is the same one used in [6]. They have used LeNet
network architecture that consists of one convolutional layer
followed by a max-pooling layer. The third layer is a second
convolution layer, which is followed by another max-pooling
layer, and a final fully connected layer.
Similar to [6] we train a linear regression layer on top of
the fully connected layer to predict point of regard. This
CNN has two inputs, cropped eyes and head pose
information. The head pose information here is nine values
of the rotation matrix and three values for translation. A
rotation of α radians about the x-axis, β radians about y-axis
and γ radians about z-axis are defined as following,
respectively [23]:
1
Rx(α)= 0
0

0
cosα
sinα

0
sinα
cosα

cosβ 0 sinβ
0
1
0
Ry(β)=
sinβ 0 cosβ
cosγ
Rz(γ)= sinγ
0

sinγ 0
cosγ 0
0
1

So if we rotate first about the x-axis, then the y-axis and
finally the z-axis, this can be represented as the matrix
product ofR= Rx(α) Ry(β) Rz(γ) which is equivalent to
following Rotation matrix:
cosβcosγ
cosβsinγ
sinβ

sinαsinβcosγ cosαsinγ cosαsinβcosγ sinαsinγ
sinαsinβsinγ cosαcosγ cosαsinβsinγ sinαcosγ
sinαcosβ
cosαcosα

We have used EYEDIAP dataset[24]. In total, there are 94
recorded sessions in EYEDIAP. Each session will be denoted
by the string “P-C-T-H” which refers to the participant id
(1-16), the recording conditions C= (A or B), the used target
T= (DS, CS or FT), i.e. Discrete Screen, Continuous Screen
and floating target moving in the space, respectively. The
head pose also consists of H=(S or M), static or moving. Each
session in conditions “A” correspond to 2.5 minutes of
recording time, whereas the sessions recorded in conditions
“B” last approximately 3 minutes each. This corresponds to
more than 4 hours of data. Table 1 summarize all recorded
data.
Table 1. Summary of the recorded sessions
Participants

Recorded sessions
A-DS-S; A-DS-M; A-CS-S; ACS-M; A-FT-S; A-FT-M
B-FT-S; B-FT-M
A-DS-S; A-DS-M; A-CS-S; ACS-M; A-FT-S; A-FT-M; B-FT-S;
B-FT-M

1-11
12-13
14-16

To standardize the definition of all 3D variables in the
data, Funes et al. have defined a common world coordinate
system (WCS), in which the variables refers to meters. In this
definition, if pk R3 is a point defined w.r.t. the coordinate
system of Kinect RGB camera, then defined WCS is the
equivalent pw, w.r.t. the WCS is given by pw = Rwpk+ tw
where:
1
Rw = 0
0

0
1
0

0
0
1

0
, tw= 0
1

In which Rw and tw are rotation and translation matrices
respectively.
The very first stage is to convert videos into frames using
OPENCV. We tried to use MATLAB for framing, but the
problem was that framed images were not synchronized with
the corresponding frame in the video. It seems MATLAB has
some problems with framing videos, after framing, we have
about 500K frames. It is mentioned in EYEDIAP dataset
that some frames are not valid. This is due to two factors, the
participant is blinking at the given frame or the participant is
not looking at the visual target at the given frame, e.g.
whenever the participant is distracted. So non-OK frames are
removed from extracted frames using given data within
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dataset. For cropping eyes we used the integrated data within
the dataset, i.e. Kinect RGB eyeball center left and right
(x_l,y_l,x_r,y_r).

3.2. POR Estimation Using CNN
Here we have used Multimodal CNN [6] to learn how to map
inputs to gaze coordinates in world coordinate space. Inputs
are eye images and 12 value head vectors. This model is
multimodal as it uses both eye images and head pose float
numbers.
In our model, we have used the Le Net network
architecture that consists of one convolutional layer followed
by a max-pooling layer, a second convolution layer followed
by a max-pooling layer, and a final fully connected layer. We
train a linear regression layer on top of the fully connected
layer to predict gaze angle vectors. The input to the network
is RGB eye images with a fixed size of 40 x 40 pixels, as
available eyeball center is at the exact center of this window
(Figure 4).
The output of the network is a 3D gaze point where the
observer is looking at. The point of regard, which is given
within dataset, is compared to this output coordinate. As a
loss function, we used the sum of individual L2 losses that
measures the difference between predicted coordinate and
the actual point of regard.
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4.2. Validation
The next 2 person are used for validation, and this was about
40K frames. With batch size of 500, we had 80 test iterations
with interval of 10K. This last value means we have carried
out validating every 10K training iterations.

4.3. Test
We have used remaining dataset videos for the phase of the
test, i.e. we have 70K frames. In this phase we have fed each
frame of test to the trained model, in addition to the head
pose data. The output which is a 3D float number refers to
the point the person is looking at. For getting Mean Error
Degree, for each testing frame, we have connected the center
of eyes to the predicted and actual gaze point which results in
2 vectors. The degree between these two vectors are
calculated with the following formula:
Θ = cos-1( |

.

)

| || ||

Figure 4. Architecture of used multimodal CNN. Head
vectors are added to the output of fully connected layer.Here
we have used [6] but with 3D gaze point

4. Experiments

Figure 5. histogram of error for test frames

In this section, we discuss gaze estimation task and validate
the effectiveness of used multimodal CNN approach.
We compare our method with state-of-the-art methods on
the EYEDIAP dataset. We have divided the dataset into
training, validation, and test sets.

4.1. Training
We have used the first 10 people of EYEDIAP for training.
This means training set consists of about 200K frames. We
trained deep network using caffe [25]. Caffe is a deep
learning framework made with expression, speed, and
modularity in mind. It is developed by the Berkeley Vision
and Learning Center (BVLC) and by community
contributors. We have used the batch size of 500, so every
epoch is 400. We have trained this network from scratch,
with the base learning rate of 0.001, the momentum of 0.95
and weight decay of 0.0005. We also have used ad a delta to
get better convergence instead of SGD. Delta parameter is set
to 1e-6. With respect to validation loss, we have trained our
CNN for 80K iterations.

Figure 6. performance of our method compared to [6]
Figure 5 show the histogram of error for all test frames.
As you can see in figure 6. We have much better result than
state-of-the-art [6] method for EYEDIAP dataset. The mean
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errror degree is less
l
than one degree, meanning the differrence
bettween actual gaze
g
vector and
a estimated one is about 0.79
deggree.
Figure 7. Allso shows thee output of soome layers inn this
CN
NN.
In this figurre, (a) correspponds to an example of input
RG
GB frame. Thiis input is croppped eye imagges. (b) Show
ws the
filtters of first coonvolution layyer, (c) shows the output off first
connvolution layeer. Another layyer shown in this figure is maxpollling, which iss a form of noon-linear dow
wn-sampling. MaxM
poooling partitioons the inpuut image intoo a set of nonoveerlapping recttangles and, foor each such sub-region,
s
ouutputs
thee maximum vaalue:

(a)
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C H. Morim
moto, and M.. R. M. Mim
mica, "Eye gaze
g
[2] C.
track
king techniquues for interacctive applicattions," Compuuter
Visio
on and Imagee Understandinng, vol. 98, pp
p. 4-24, 2005..
[3] S.
S R. Langtoon, H. Honeyyman, and E.
E Tessler, "T
The
influ
uence of headd contour andd nose angle on
o the percepttion
of ey
ye-gaze directtion," Perception & psycho
ophysics, vol. 66,
pp. 752-771,
7
20044.
[4] N.
N Robertsonn, and I. Reidd, "Estimating gaze directtion
from
m low-resolutiion faces in viideo," in Europ
opean Confereence
on Computer
C
Visiion, pp. 402-4415, 2006.
[5] Y.
Y Sugano, Y.
Y Matsushitaa, and Y. Sato, "Learning--bysyntthesis for apppearance-bassed 3d gaze estimation," in
Procceedings of the
t IEEE Connference on Computer
C
Vission
and Pattern Recoggnition, pp. 1821-1828, 2014.
[6] X.
X Zhang, Y.
Y Sugano, M. Fritz, and
a
A. Bulling,
"Appearance-baseed gaze esttimation in the wild," in
Procceedings of the
t IEEE Connference on Computer
C
Vission
and Pattern Recoggnition, pp. 4511-4520, 2015.

(b)

(c)

(d)

Figgure 7. Figure 7 (a) Croppped eye, (b) conv1 filterss, (c)
connv1 output (rrectified respoonses of the filters), (d) pool1
p
outtput

5. Conclusiion and Future
F
Woork
Deespite lots of works
w
mentionned in literaturre, there have been
few
w works for appearance-ba
a
ased gaze estiimation with lowquaality images. Those wiith this conndition evaluuated
excclusively undeer controlled conditions wiith low range head
posses. In this work
w
we havve employed [6] method with
diffferent settingg for EYED
DIAP dataset which variees in
diffferent head pose and illum
mination condiitions. This daataset
is very
v
challengiing as floatingg target sequennces contain many
m
exttreme gaze directions. Our setting for CNN-bbased
estimation moddel significanntly outperforrms [6] whicch is
state-of-the-art. Our future work will consist in using
u
diffferent deep network.
n
We also will try to get eye im
mages
andd head pose auutomatically.
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Ab
bstract
It is desirable to realize
r
latency--balanced compputation channeels in residue number
n
system
ms (RNS). In paarticular modullo-(2
δ) addiition
witth selected valuues of δ (e.g., δ 1, 3, 5 ) is off interest. Moduulo-(2
1) add
ders are realizedd via one’s com
mplement additiion, where 2
1
is also
a valid as a second
s
represenntation for zeroo. Fast parallel prefix
p
realizatio
on of such addeers exist with (3 2 log ) Δ latency, wheree Δ
dennotes the delay of a simple 2-innput gate. Simiilarly, modulo-((2
3) adderss with excess-m
modulo represenntations of resid
dues in 0, 1, 2 has
beeen recently propposed with (4 2 log ) ΔG latency.
l
It has been
b
shown thaat such double representation
r
oof residues doess not jeopardizee the
subbsequent RNS operations.
o
To approach
a
largerr dynamic rangges, while keepiing the channell widths (i.e., n) as low as posssible, fast moddulo(2
5) adders co
ould be quite useful. That’s how
w we are motivvated to exploree the design andd implementatioon of such addeers with the goaal of
achhieving the sam
me latency of (4 2 log ) Δ . The proposeed scheme is baasically the sam
me as that of thee aforementioneed modulo-(2
3)
addders. However, there are particcular non-triviall challenges to be
b overcome. The
T proposed sccheme is analyzzed for latency and area measuures,
which are confirm
med via circuit synthesis by Synnopsis Design Compiler.
C

Keeywords: Moddulo-(2

5) Ad
dder, Excess-M
Modulo Represenntation, Paralleel Prefix Modular Adders, Digiital Signal Proccessing.

1. Introducction
The latency balaance within thhe parallel com
mputation channnels
of a residue num
mber system (RNS)
(
arithmeetic architectuure is
dessirable [1]. On
O the other hand,
h
limited dynamic rangge of
thee classical moduli
m
set τ
2
1, 2 , 2
1 callss for
addditional balannced moduli, where moduular additionn and
muultiplication caan be perform
med with the same speed as in
thee original three moduli. Parrallel prefix faast adders [2-55] for
thee aforementionned τ system
m with (3 2 log n ) ΔG lattency
hass been proposed [6], wherre ΔG refers to the delay of a
sim
mple 2-input AND
A
or OR gaate. The correesponding moddulo(2
1) adder taakes advantag
ge of a secondd representatioon for
zerro, as 2
1, where
w
a regullar parallel preefix (RPP) annd the
so called totally parallel prefixx (TPP) archittectures [7] leead to
(5 2 log n ) andd (3 2 log n ) ΔG latenciess, respectivelyy.
Moreover, siimilar moduloo-(2
3) RPP and TPP ad
dders
witth (6 2 log n ) and (4 2 log n ) ΔG laatencies have also

been
n reported [8], where 0, 1 and 2 have alternaative
representations, as
a 2
3, 2
2, and 2
1, respectiv
vely.
How
wever, we haave not encouuntered any special moduulo(2
5) adder design in the literature, th
hus motivatedd to
pressent one withh the same performance as that of the
aforementioned modulo-(
m
2
3) adder. The rest of this paaper
dealls with a backgground on RN
NS arithmetic in Section 2, also
a
with
h a brief descrription of prevvious relevantt modular addders,
offerrs our propoosed moduloo- (2
5) adder designss in
Secttion 3, evaluaations and coomparisons in
n Section 4, and
finallly concludingg remarks in S
Section 5.

2. Backgrou
B
und
b a k-modulii set
A reesidue numberr system is maainly defined by
ulus are com
mmonly pairw
wise
m , … m , wherre the modu
prim
me to allow for
fo maximal rrange (aka dy
ynamic range)) of
pressentable numbbers [9]. Thee dynamic raange, as suchh, is
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equal to M ∏ m . The RNS representation of a binary
number X is composed of k residues x |X| (i.e., the
X
remainder of integer division
, for 1 i k), where
addition and multiplication on binary operands X and Y are
performed on their corresponding residues x and y in k
parallel data paths.
Modulo-2 addition is exactly the same as conventional
n-bit addition, while multiplication is even simpler and less
costly. However, given the mutually prime property, only
one m can be a power of two. The next popular moduli are
of the form 2
1 (n p), since the required adder is
exactly the same as a one’s complement adder, and the main
component of the corresponding multiplier is an n p operand modular adder. The n p restriction is to keep the
moduli set balanced in terms of arithmetic speed. However,
the number of such mutually prime moduli are limited.
Therefore, moduli of the form 2
1, and more recently
modulo-(2
3) have been employed in order to set up high
dynamic range balanced moduli sets [8].
Parallel prefix modular addition is popular, since it
provides for more balanced arithmetic circuits. For example,
3 2 log n ΔG TPP adders have been proposed for modulo1 , where figure 1 (borrowed from [8]) depicts the
2
required architecture. Also the fastest modulo-(2
3) adder
that we have encountered is due to [8], where the latency of
its TPP architecture (see figure 2 that is borrowed from [8])
amounts to 4 2 log n ΔG. The legend for these figures and
the proposed designs are compiled in table 1.

3. The Proposed Modulo-(

7

7

s7

6

6

5

5

s6

4

4

s4

s5

3

3

2

2

s3

Figure 2. The TPP modulo-(2
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Table 1. Logical cells used in the respected figures
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1), and – 2
3 adders are fairly
The modulo-(2
balanced, since for instance in case of n 8 (i.e., a typical bit
length in RNS applications such as image processing [10]),
9, and 10 ΔG latencies are achieved, respectively.
Nevertheless, in this section, we propose an RPP modulo(2
5) adder, with the same (6 2 log n ) latency as the
fastest previous modulo-(2
3) RPP adder [8], which
consumes slightly more area and dissipates marginally more
power. We also provide a TPP version of the proposed adder
that performs as fast as the previous modulo-(2
3) TPP
adder [8], while the additional area and power measures are
negligible.
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3.1. The Proposed Modulo-(

) RPP Adder

We follow the same approach as in [8] and come up with
table 2 that describes the steps of modulo-(2
5) addition
S |X Y|
, where EAC stands for end-around carry. This
table is quite similar to the figure 4 of [8], except that
position 2 (instead of 1) is occupied by G ;
v
G : ,
where G :
denotes the generated carry-out of
U V [11]. Such difference, however, leads to different
equations for carry signals c to c with respect to the
corresponding ones in [8]. These equations are derived as
Eqns. 1-3, where c
1 is the generated carry for u
v
G
c
3
,
since
v
and
c
cannot
be
1
at
once.
:
The reason is thatc
u v
u
v c
u v u G
:
v u G
0 and v u
0. Therefore, c is in
: , since v u
fact the carry of summation u
v c
G
: . Note that
Eqn. 3 includes the modified group propagate signal
P :
p G : P : . Also, the fact that g
0, and p
u ,
leads to G :
G : , and simpler equation for P : as in
Eqn. 4.
Figure 3 depicts an RPP realization of such carry signals
and the corresponding sum signals for n 8, where the
preprocessing stage consists of an array of half adders, and
thus leads to 7 2 log n ΔG latency. Note that derivation of
s
h
G :
c requires an extra XOR operation,
which does not lengthen the critical delay path (CDP). The
rest of carry equations are described by Eqn. 5, where the
group propagation signals P : (for i 3) are based on P :
(i.e., P :
P : P : ).
Table 2. Modulo- 2
preprocessing

5 EAC addition with carry-save

x
y

X
Y
U
V

….
….

u
v

v

….
….

u
v

V
5EAC

u G

c

G

c

P

c

….
….

s

….

G

h
c

s

P: G

:

(2)

:

:

P

:

G

:

G

:

c G

:

c
c
c

G

s

c
:

:

(3)
v u
y x y

g
G

(4)
(5)

(6)

p g

:

p

G

:

p

:

:

G

p

:

:

g

(7)

p g

The corresponding circuitry is depicted by figure 4,
where the delay figures are indicated along the data paths. In
particular, s and s are delivered in 11ΔG and s in 12ΔG,
while the other sum signals are available at 10ΔG. The reason
for the extra delays for s and s is 1ΔG delay of g with
respect to other g signals that leads to 5ΔG delay of G : , and
that of s is due to the extra XOR. The former can be fixed
via implementing Eqn. set 8 and the latter by Eqn. 9.
Regarding s , one of the two possible sum values fo G :
0r or 1 (i.e., h
G : or h
G:
P : ) is selected by a
multiplexer, and thus Δs
2ΔG ΔG : , as the other s
outputs (see figure 5). As for g , the modified equation
(i.e., Eqn. set 8) delivers it in 3ΔG, and thu G : s is available
in 4ΔG, as other G : signals.
g
x

u
x

g

G : P : G
:
g
p G :
p g
p G : p : G : p : G :
g
G: p : G :
G: p : G : p : G : p : G :
G : p : G :
G : p : g
p g
p G : p : G :
G : p : G :
G : p : G: p : G : p : G :
G : p : G :
G : p : G : p : g
p g
p G :
G : p : G :
G : p : G : p : G: p : G :
G : p : g

;

h
c

s

:

c
c

c

(1)

p g
p p
p u v
u v u
p u x y
u x
y

:

h
c

pg

The TPP architectures are expected to lead to 2 ΔG less
overall delay with respect to the corresponding RPP
architectures, as is the case in the TPP modulo-(2
3) adder
of [8]. Therefore, we elaborate here on developing a TPP
modulo-(2
5) adder that yields all the sum bits in 4
2 log n ΔG, where we use Eqn. 7 that describes the general
TPP carry formula, with the understanding that P :
P : P : . As such the required TPP equations for n 8 are
described below.

c

G

g

3.2. Corresponding TPP Architecture

u
0
u
0

;

G:

c

:

u v u c
u v
c G
u v
u v G :
u v
g
p G : p G : P: G
g
p G:
p c G :
G :
p G : P: G : G
p G : P: G :
G :
G : P : G :
p
p

u
v

1) Further Speedup of RPP Architecture
Recalling the 6 2 log n ΔG latency of the modulo-(2
3)
adder of [8], we can use the technique, therein, to achieve the
same 1ΔG gain. Eqn. 6 is reproduced from [8], where
u
x
y , p
u , and g
u v . Therefore,
ΔG :
is reduced to 4ΔG, since p and g
are delivered in
2ΔG, and thus the total delay for the proposed RPP adder is
also 6 2 log n ΔG.

x
y

u
v

u
v

G

S

x
y

u
v

….
….

h
c

c

x
y
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s

:

h
h

v
u v
y v x y
g
p g
G
G

:

v

x
y v
u v

v

x y

(8)
c

h
: G
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Figure 5. Modification for the terminal part of the
figure 4

path in

3.3. Addition of Two Excess-Modulo Residues
Most of RNS applications require modular addition and
multiplications, where at least one operand is furnished via
input data, which is therefore normally represented
(i.e., single representation of residues). In such cases, Eqn.
set 10 is meant to show that excess-modulo representation of
the other operand does not jeopardize the resulted residue,
where A 0, 2
5,B
2
5, 2
1 , and B
B
2
5 , represent the normal representation of B. However, the
same analysis fails for the case of both operands in excessmodulo representations, which can be handled as follows, in
hypothetical cases of occurrence.
Figure 3. The proposed RPP modulo-(2

5) adder

|A
|A

|A
|A

B|
B|

B
B

2
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5|
5 |

|A B |
|A B |

,
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Delay
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3

4 3 3 3

2

2

2 2

1

1

2 1 1

0

0

The excess-modulo operand pairs 2
δ and 2
δ ,
where 1 δ , δ
5, should be examined for possible wrong
sums. Let A B G : w … w , and S s s … s
w
…w
5G : . Therefore, s
w c
h
G : c , where all the required three operands are
available in the RPP and TPP realizations of figure 3 and 4.
|A B|
|2
On the other hand, s … s
δ
2
denotes the sum that is produced by the proposed
δ |
adders, where the EAC G
1. Therefore, Eqn. set 11
:
holds, where the cases of S 2 (i.e., S 2 , 2
1, 2
3 ), denoted by s
1, are not valid, and should be
2, 2
corrected by another subtraction by 2
5, or actually
addition by 5. However, this correction act affects only the
four least significant bits of the sum (i.e., s s s s ), as is
justified by the content of table 3.

1 0 0

4∆

4∆
7:6 , 7:6

6:5 , 6:5

5:4 , 5:4

4:3 , 4:3

3:2 , 3:2

2:1 , 2:1

1:0 , 1:0

5∆

0:7 , 0:7

2∆

S

2

δ

2

δ

2

5 ,2

Table 3. Two excess- 2

2∆
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7:0
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6

7

4

5

5

4

3

2

7:0
0

2∆
7

6

5

4

3

1

2∆
2

Figure 4. The proposed TPP modulo-(2

5) adder
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5 operands

,

1

1

2

3

5

0

2
2
2
2
2
2

4, 2
3, 2
3, 2
2, 2
2, 2
1, 2

1
2
1
2
1
1

0000
0000
0001
0001
0010
0011

0101
0101
0110
0110
0111
1000

Eqn. set 12 describes the corrected sum bits s 0 i 3
in terms of the original sum bits s . Note that s
0 in other
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cases that are not listed in table 3. Therefore, additional
latency of the correction logic is 4ΔG.
s
s s

s
s ,s
s s s

s s

s

s s ,s

s s

s s s ,s

(12)

4. Evaluations and Comparisons
Recalling the modifications to figure 4 that was explained in
Section 3.2, the overall latency of the proposed TPP modulo2
5 adder is equal to the desired 4 2 log n ΔG in the
practical cases, where at most one of the operands is excessmodulo. Also that of the RPP realization of figure 3 is
6 2 log n ΔG. Therefore, the proposed adders are latency
balanced with the corresponding previous modulo- 2
3
adders of [8]. The gate level delay and area measures of the
reference and proposed adders are listed in table 4. To
confirm the results, therein, we have coded function of the
four adders, perform correction tests, and simulated the
corresponding circuits by TSMC .9 µm Synopsys Design
Compiler. Figures 6-8 depict the area and power curves in
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terms of time constraints of the synthesis tool, for n
8, 16, 32 , respectively. These results confirm the latency
balance between modulo- 2
3 and - 2
5 channels,
where the area consumption and power dissipation are also
compatible. The corresponding measures for the least met
time constraint are compiled in tables 5-7.
Table 4. Analytical gate-level performance measures
Design
RPP 2
5

Delay (∆
6 2 logn

TPP 2

5

4

2 logn

RPP 2
TPP 2

3
3

6
4

2 logn
2 logn

Table 5. Synthesis results for n
Design
RPP 2
TPP 2
RPP 2
TPP 2

Delay (ns)
0.5897
0.5499
0.5499
0.5498

5
5
3
3

Figure 6. Area and power comparisons for n

8

Figure 7. Area and power comparisons for n

16

Figure 8. Area and power comparisons for n

32

Area (µm )
19695.16
19150.68
17220.08
20376.62

Area (∆ )

8
Power (µw)
650.87
616.61
585.71
624.14
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Tabble 6. Synthesiis results for n
Design
RPP 2
TPP 2
RPP 2
TPP 2

5
5
3
3

Delay (ns)
0.7000
0.6999
0.6500
0.6499

Area (µ )
39286.79
45391.73
38553.01
44467.15

Tabble 7. Synthesiis results for n
Design
RPP 2
TPP 2
RPP 2
TPP 2

5
5
3
3

Delay (ns)
0.89
0.85
0.90
0.79

Area (µ )
91145.98
84412.00
82295.13
87038.07

16
Power (µw)
1301
1486.8
1098.4
1350.8

32
Power (µw)
2822.4
2460.2
2363.9
2602.3

5. Conclusiions
RN
NS applicationns can be reaalized to show
w better figures of
meerit (especiallyy performancce) in case off balanced moduli
set, where the latency
l
of alll the computaation channels are
most equal (i.ee., at most 1Δ difference).. Modular adddition
alm
is in particularr of interestt, where parrallel prefix 3
2 lo
og n ΔG add
ders have beeen presentedd for moduli set
2
1,2 , 2
1 [2], and alsso modulo- 2
3 adders with
4 2 log n ΔG
G performancee [8]. Additio
onal moduli of
o the
forrm 2
δ arre desirable to
o accommodaate larger dynnamic
rannges, providedd that 4 2 log n ΔG addders are feassible.
Wee presented a modulo- 2
5 parallel prefix adderr that
meeets the latter performance constraint. Thhis was shownn via
gatte-level analyysis that was confirmed
c
byy synthesis results.
Succh performannce was achievved at marginnal penalty inn area
andd power measures.
As for the relevant futture work, for
f
extendingg the
dynnamic range while
w
keeping the whole mooduli set balannced,
wee plan to sttudy the deesign and im
mplementationn of
com
mpatible moduulo- 2
3 and
a -2
5 adders.
a
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Ab
bstract
l
eneergy-efficient hierarchical
h
SR
RAM design caapable of workking in near-thhreshold region
n is proposed. The
In this paper, a low-power
prooposed method enhances the noise
n
margin using an extra circuitry,
c
while restricting the hardware reduundancy by shaaring the additioonal
circcuitry between each two SRA
AM cells in a hierarchical
h
styyle. The results of simulating the FinFET-baased SRAM cells using Synoppsys
HSPICE at 10nm technology nodde indicate thatt the proposed design
d
reduces,, on average, thhe power-delay product, read and
a write delays by
14.34%, 2.37% annd 8.54%, respeectively, and siggnificantly imprroves the static noise margins even in the presence of major process variatioons.

Keeywords: Statiic Random Acccess Memory (SRAM), Multtiport Memoriees, Low-Power Design, Staticc Noise Marginn (SNM), FinFFET,
Nannoelectronics.

1. Introducction
Noowadays, by scaling
s
the teechnology node, the variabbility
conncerns have become very im
mportant. Thiss is due to (i) very
sm
mall geometrics where evenn small variatiions can cause big
chaanges, (ii) redduced power supply
s
voltagee, where VDD level
is very closee to transisstors threshoold voltage [1].
Acccordingly, thhe SRAM cell stabilityy dependingg on
trannsistors strenngth ratios haas become onne of the bigggest
conncerns in VLS
SI design [2]. With the eveer-increasing short
chaannel effects,, parametric variations
v
annd cache capaacity,
SR
RAMs have become
b
very sensitive to variability. As
A a
ressult, a new trade-off beetween the variability,
v
power
connsumption andd performance parameters has come in VLSI
V
dessign [2].
Ignoring reddundancy, eacch cell must work
w
under worstw
casse variations. In the convventional 6T SRAM, streength
ratiios of devicess must be adoopted such that cell static noise
n
maargin and writte margin are both upheld,, while they are
a in

confflict with eachh other. Durinng the read staate, it is desiraable
to have strongeer storage inverters and weaker pass
p
transsistors, while during the wrrite state it is desirable to have
h
stron
nger access transistors and weaker storag
ge inverters. This
T
fine balance of transistor sttrength ratioss can be eaasily
affeccted by proocess variatioons, which will
w
specifically
degrrade cell sttability and read margin
n in nanosccale
tech
hnologies [2].
In
I order to coonsider variabbility problem
ms, many dessign
tech
hniques have been propoosed to enaable low-volttage
operration for SRA
AM cells. A higher supply
y voltage cann be
used
d for SRAM cells
c
such thaat the SRAM voltage does not
decrrease with thee technology to meet the desirable
d
marggins
[3]. However, thiis approach dooes not provid
de the demannded
low power consum
mption. Anothher approach is
i to use dynaamic
voltaage sources such that SRAM voltaage source can
dynaamically channge during ddifferent stattes [4]-[5]. This
T
tech
hnique increases the design complexity, while
w
it improoves
the cell
c stability and
a reduces thhe standby leak
kage.
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Scaling the technology node has also led to a major
power consumption challenge. The importance of power
consumptions is more prominent in the systems with
restricted energy sources. Reducing the supply voltage is
considered as one of the most effective ways to decrease the
power dissipation. This is achieved by sub-threshold or near
threshold circuits design which enhances energy efficiency
[6]. In this way, leakage power is also considerably reduced
due to less voltage difference between drain and source of a
transistor, which suppresses the DIBL effect, and
consequently reduces the OFF current [7].
On the other hand, reducing the supply voltage results in
higher propagation delay and slower circuits. At the present
time, power saving is becoming very crucial in many circuits
and applications that do not require very high speed, such as
memories, nano-sensors, radio frequency identification and
implantable medical devices. These applications may be in
hold or stand-by modes most of the time, and need very low
energy consumption and long battery lifetimes [8]. In
addition, investigations have demonstrated that the minimum
energy can be achieved in the sub-threshold region. In other
words, appropriate power-delay product (PDP) can be found
in the near-threshold region [9]. In the sub-threshold region,
the drain current is defined by Eq. 1 [10].
I sub  cox

VGS Vth
n T

W 1.8 2
e T e
L

where,

1

VDS

1  e T








is the sub-threshold factor and

(1)

T is

the

thermal voltage.
A specific and important state of a transistor in a
nanoscale digital circuit is the OFF state, where VGS=0V and
VDS=VDD. The drain current in this state, which is denoted as
IOFF, is given by Eq. 2. It can be concluded from Eq. 3 that
the IOFF leakage current is reduced exponentially by
decreasing the supply voltage.
IOFF  cox

Vth

W 1.8 2 n T
e T e
L

(2)

On the other hand, reducing the supply voltage to
near-threshold region considerably increases the circuit
delay. The propagation delay in the sub-threshold region is
almost given by Eq. 3, where K is a suitable fitting
coefficient.
td 

KCVDD
W 1.8 2 (VGS Vth )/ nT
cox e T e
L

are often in the hold state, decreasing the static power
dissipation of SRAM cells considerably contributes in
reducing the total power consumption of a chip. Operating of
SRAM in the sub-threshold region can dramatically reduce
the leakage power, but it degrades the speed and static noise
margin (SNM) of the cell, which should be considered in the
design methodology [8].
In order to meet the challenges imposed by transistor
scaling, different device structures have been explored as
alternatives to the conventional bulk MOSFET. However,
considering these technologies, FinFET is more appropriate
for scaling the MOSFET to near 10nm feature size [11].
FinFETs demonstrate superior gate control on the channel,
lower sub-threshold swing, lower short channel effect and
higher scalability. However, width quantization is a
challenge in FinFETs, which restricts the design possibilities
of FinFET-based circuits such as SRAMs that need transistor
sizing for correct operation and robustness. This constraint
should be carefully considered and compensated in the
design procedure [12].
In this paper, a new hierarchical SRAM cell design,
denoted as HSRAM, is proposed with improved SNM and
static and dynamic power consumption metrics. The number
of transistors in every cell is decreased compared to its
counterpart presented in [14], by multiplexing the additional
transistors between each two cells, which reduces the power
and energy consumptions of the proposed design.
The rest of this paper is organized as follows: In the next
Section related work is reviewed. The proposed SRAM cells
are introduced and described in the Proposed Design Section.
The simulation results and comparisons are given in
Simulation Result Section, and finally Summery Section
concludes the paper.

2. Related Work
Designing low-voltage memories is demanded to reach lower
power consumption. The classic 6T (6-transistor) SRAM cell
is shown in figure 1. Assume that the X and Y nodes have
stored 0 and 1 values, respectively, as illustrated in figure 1.
In this case, M1 and M4 are ON and M2 and M3 are OFF.
During the hold time, when WL is 0, M5 and M6 are OFF. In
this state, the leakage current through M3 can proportionally
lead to failure, since in the idle mode the leakage current
through M2 and M5 causes a small increment in the voltage
of node X, which is not acceptable due to small SNM in subthreshold region.

(3)

Due to a significant speed reduction, sub-threshold
circuits are often unsuitable for high-performance
applications. However, they are practical for some
applications, which do not require high-frequency operation
but demand ultra-low power consumption, such as wireless
sensor networks. However, increase in variations in
sub-threshold region can degrade circuit stability [17].
SRAMs occupy a considerable part of the area and
dissipate a large amount of power in VLSI chips [16].
Therefore, reducing the power consumption in SRAM cells
is a vital issue in low-power VLSI design. As SRAM cells
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Figure 1. 6T SRAM cell
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During the read cycle, when WL=1 and BL=BLB=VDD,
M5 and M6 are ON and consequently, BL will be discharged
through M1 and M5, and read operation is accomplished. In
this situation, due to existence of some leakage through M3
there is a drop in Y, which results in reading speed
degradation and possible data flips on storage nodes. In
addition, transistor sizing is not adequate to prevent failures,
especially in near- and sub-threshold regions [13].
The 11T SRAM cell [14], illustrated in figure 2,
improves the whole energy consumption, the ability of
working in sub threshold supply voltages the SNM of the 6T
SRAM cell but with the penalty of higher number of
transistors and larger area. However, the power consumption
specially static power, is the critical challenge in designing
digital systems especially in SRAMs.
As the 11T and 13T SRAM cells [14] focus on reducing
the static power consumption and improving the performance
at sub-threshold region, we discuss these cells in more detail.
In the 11T cell, M2, M4, M5 and M6 transistors keep the
aforementioned characteristics of the 6T cell. However, the
size of the M1 and M3 transistors are scaled down equal to
the size of the p MOS transistors. In addition, separate BL,
WL and RDWL (read word line) lines are considered in this
cell, which leads to separated read and write ports.

VDD

M10
CB

M4

M2

YN
M9

X

M1
BL

causes some reduction in the RDBL voltage, this leakage has
no effect on YN or RDBL because of connecting M9 to
ground via M8.
To suppress the channel leakage path through M8, a
modified topology denoted as 13T cell is suggested in [14].
This cell which has 13 transistors is shown in figure 3. When
Y is high the source of M8 is connected to ground through
the added inverter, but when Y stores “0”, the source of M8
is connected to VDD, which suppresses the leakage path in
M8 during the read cycle.
RDWL

WL
VDD

M10
CB

M4

M2

YN
M9

X

M5
M1

Y

M6

Boosted
Node

M3

BL

M12
M11

M8
BLB

RDBL

Figure 3. An improved 11T SRAM cell (13T SRAM) [12]

3. Proposed Design

RDWL

WL

M5
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Y

M6

Boosted
Node

M3

M12
M11

M8
BLB

RDBL

Figure 2. The 11T SRAM cell [12]
During the hold state, the WL and RDWL lines are not
activated. Suppose the situation when Y=0 and X=1, as
described before for the 6T cell. In the additional 5T
circuitry, M12 is OFF and the state of M11 depends on the
voltage at node Y. When Y=0, M8 is OFF and M9 is ON,
and consequently the gate of M11 is charged. Therefore, a
path is created through M11 that connects the node YN to
zero. The transistors of the added 5T circuit have minimum
size, except the access transistor (M12) that has a larger size.
The boost capacitor (CB) that connects the source of M9
to RDWL is a substantial part in this cell. Given that Y=0
(during the hold and write times) and RDWL is connected to
ground, CB starts to charge up to VDD. Though, the amount
of charging is limited by M9 and finally the maximum
voltage reaches VDD/2. Thus, the gate of M11 is connected to
a voltage of approximately less than VDD/2 and YN
discharges to the ground slowly.
When RDWL is selected, the source of M9 rises to 1.5
VDD and the gate of M11 connects to a voltage higher than
VDD. This enhances the read current by an order of
magnitude as compared to the classical 6T SRAM cell,
which leads to faster read operation. In the other case when
Y=1, M8 is on and M11 is off, which makes the reading path
isolated from the ground. Although the leakage through M11

Design of low-voltage digital circuits operating in near- or
sub-threshold regions has emerged as a low-power solution
for applications with energy constraints. As SRAM memory
constitutes a significant percentage of the whole power and
area of most digital chips, reducing its power consumption,
especially at the stand-by mode, is quite important.
As stated before, the 6T SRAM cell is not suitable for
low-voltage applications as it has a small SNM. Accordingly,
some effective solutions for improving its SNM in low
voltages have been presented in the literature [14]. Despite
the improvements in SNM, adding 5 to 7 transistors to the 6T
SRAM cell increases the hardware overhead, and
consequently the delay and power consumption in the
memory system. As a result, for designing an SRAM that
maintains the aforementioned SNM improvements, while
restricting the hardware redundancy, delay and power, a new
hierarchical SRAM (HSRAM) cell is proposed in this paper.
The proposed SRAM cell is shown in figure 4. In the
proposed design, the hierarchical style also reduces the cell
power consumption by use of a multiplexer in the reading
path. In this design, due to separating the reading part from
the cell, no current is drawn for reading from the cell. Unlike
the 6T cell, the read SNM of the proposed cell is not
degraded, and is similar to its hold SNM.
As illustrated in figure 4, for reducing the hardware
overhead in the 11T SRAM, instead of adding five transistors
for each cell, these 5 additional transistors can be shared
between each two cells. In this design, the read lines are
connected to each other, and the write lines for each cell are
separate, as the write ability should be provided for every
cell in an SRAM. In order to read from these SRAM cells, a
transmission gate-based 2:1 multiplexer is utilized, which
connects the SRAM core cells to the read stage. It is worth
mentioning that by connecting the read lines, the data stored
in each core cell does not become faulty and it is not
corrupted during the read procedure.
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In the read state, the read line is activated for each of the
two cells, and the multiplexer connects the corresponding
core cell to the 5-transistor read stage based on the selector
signal. If the selector signal becomes ‘0’, the first cell is
chosen; otherwise, the second cell is selected. It is
noteworthy that the transmission gate structure of the
multiplexer provides low-resistive paths and full-swing
signals for the read stage.
In addition, the additional inverter existing in the original
circuit [14] is omitted in the proposed design as it does not
have any considerable effect on the static power, while
omitting these two transistors reduces the overall switching
power of the SRAM. It is worth pointing out that sharing the
read stage also leads to a considerable reduction in the read
bit line (RDBL) and read word line (RDWL) capacitances,
and consequently results in lower dynamic power
consumption and higher speed.
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4. Simulation Result
The circuits are simulated using the HSPICE simulator tool
with 10nm LSTP FinFET technology [15] at 0.45 V supply
voltage and at 60oC temperature. Some of the important
parameters of the utilized model are given in table 1. In the
simulations, all the SRAM’s transistors have the minimum
size except the ones in the 6T conventional SRAM cell,
which have multiple sizes in order to have a good Read
SNM. The capacitors of the BL, BLB, RDBL and RDWL
lines are assumed as 10fF for a basic design. The power
consumption, read and write delays, average case power
delay product (PDP), best case PDP, worst case PDP and
SNM of the proposed SRAM cell are calculated and
compared with those of the other low-power SRAM cells.

WL0
VDD
M2

M4

RDWL
S0

M5
M6
M1

M9

M3

Address [(n-1):0]

S0'

M10
M8

WL1

M4

Address [(n-1):1]

(b)

M7

Figure 5. Two addressing models: (a) Conventional model
(b) HSRAM Model

M5
M6
M3
S1'

BL

Read Line

Write Line

(a)
S1

M1

Address [0]
Read Line

M11

VDD
M2

Write Line

Table 1. The FinFET parameters

RDBL

BLB

Figure 4. The proposed SRAM (HSRAM)
By categorizing the memory cells and integrating the read
line, changing the addressing model of the SRAM cells is
necessary. As there is one read line activation for each two
cells, according to the conventional models, some clusters of
cells may be activated and put on the output simultaneously,
which leads to data collision. For solving this problem, the
address is divided into two 2-bit parts.
The least significant bit is used as the selectors of the
clusters. This bit can be 0 or 1, which will select one of the
two cells of each cluster, and the remaining bits will choose
the corresponding cluster, and accordingly the corresponding
cell is selected to put its data on the output line. These two
addressing models are illustrated in figure 5.

Parameter
Lg
HFin
TFin
EOT
Nbody
Nsd
Φgn
Φgp

Description
Physical Gate Length
Fin Height
Fin Thickness
Equivalent oxide thickness
Doping of the body
Doping of the source-drain regions
Work Function of the gate for N-type
Transistor
Work Function of the gate for P-type
Transistor

Value
14 nm
21 nm
8 nm
0.68 nm
2.5 × 1016 cm-3
3 × 1020 cm-3
4.42 eV
4.75 eV

The simulation results for all SRAM cells are given in
table 2 Average PDP is the multiplication of average power
and average delay. Best case PDP stands for the product of
the average power and best delay, while worst case PDP
stands for the product of the worst dynamic power and the
worst delay. According to the results, the proposed cell has
lower power, write delay and PDP than the other designs.
This is because of different structure and operation as
compared to 6T, and lower number of transistors and less
line capacitance in comparison with 11T and 13T cells.

Table 2. The simulation results at VDD=0.45V
SRAM
HSRAM
6T
11T
13T

Average Power
(nW)
24.81
25.60
52.91
36.81

Static Power
(pW)
286.04
307.30
274.98
298.11

Read Delay
(ps)
311.85
319.46
244.31
245.08

Write Delay
(ps)
173.11
212.64
173.86
177.27

Average Case
PDP (aj)
5.3080
6.6243
10.216
7.1120

Best Case PDP
(aj)
3.8930
4.7376
8.4497
5.8346

Worst Case
PDP (aJ)
19.72
20.86
33.16
23.08
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Power Delay Product (aJ)

Read accesss delay, whhich is the time required to
disscharge RDBL to “0.8×V
VDD” after RDWL
R
reachees to
read
VDD
/2,
is
one
o
of
the
metrics
s
in
SRAM
c
cells.
During
D
opeeration, RDW
WL is activateed and the access transisttor is
turrned on. If thee data which is going to be read is ‘0’, then
RD
DBL will be discharged to ground;
g
and iff the data is ‘11’, no
chaange happens in RDBL. Acccording to thhe results, the read
dellay access of the
t proposed HSRAM
H
is 277.24% and 21.65%
lonnger than thhose of the 13T and 11T SRAM cells,
c
resspectively, due to the multtiplexer stage,, but 2.37% lower
l
thaan the 6T SR
RAM since itt has a separaate read circuuitry.
Hoowever, the proposed
p
methhod consideraably improves the
pow
wer consumption and PDP
P metrics as compared
c
to other
cellls.
Another impportant metric in evaluationn of SRAM ceells is
thee write access delay, whichh is defined ass the time requuired
to charge the node
n
that hass stored 0 too VDD/2 after WL
reaaches to VDD/2.
/ During wrrite operationn, WL is activvated
andd access trannsistors are turned
t
on. Thhen, new daata is
trannsferred by thhese transistorrs to cell. Wriite delay acceess of
thee proposed HS
SRAM is 2.4%
%, 0.43% and 22.8% lowerr than
thee 13T, 11T annd 6T cells, respectively. Inn the 6T SRAM
M, in
ordder to have reaad ability, the size of transiistors are diffeerent,
andd therefore, thhey do not have
h
the samee strength. Onn the
othher hand, as thhe pull down transistors
t
havve higher strenngths
thaan the access transistors,
t
thee write delay gets
g longer.
The delay, power
p
consuumption and PDP of the cells
verrsus supply voltage
v
are plotted in figurre 7 and figuure 8,
resspectively. Acccording to thhe results, the proposed celll has
low
wer power connsumption andd PDP as com
mpared to the other
cellls in a wide range
r
of suppply voltages, especially
e
at lower
l
volltages.
Static noise margin (SN
NM) is an im
mportant metrric in
evaaluating the robustness of
o an SRAM
M cell. The SNM
S
parrameter is calcculated as thee diameter of the biggest sqquare
fouund in the buttterfly graph of
o a SRAM cell.
c
For analyyzing
SN
NM, Monte Caarlo analysis with
w Gaussiann distribution with
10%
% variation att the 3-sigma is
i conducted. Process variaations
aree considered in the Fin height,
h
Fin width
w
and chaannel
lenngth as the im
mportant FinF
FET device paarameters. Finnally,
thee diameter is measured
m
in thhe butterfly grraph. The buttterfly
graaphs indicatinng the hold and
a read SNM
Ms of the proopose
SR
RAM cell are illustrated
i
in figure
f
7.
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Table 3 gives the hold and read SNMs, as well as their
variations for the SRAM cells. According to table 3, the hold
SNMs for all cells are almost comparable. In the read state,
the proposed cell as well as the 11T and 13T cells has SNMs
equal to their hold state as there is no charge sharing between
the separated read bit line and the main cell. However, in the
6T SRAM cell, due to connecting the cell to BL and BLB,
the pulling current (charge sharing) from the cell decreases
the read SNM.

dynamic power rails," Symposium on VLSI Circuits, Digest
of Technical Papers, 2004.

Table 3. SNM of the SRAM Cells (VDD= 0.45 V)

[6] Y. Yang, H. Jeong, S. C. Song, J. Wang, G. Yeap, and S.
O. Jung, "Single Bit-Line 7T SRAM Cell for Near-Threshold
Voltage Operation With Enhanced Performance and Energy
in 14 nm FinFET Technology," IEEE Transactions on
Circuits and Systems I: Regular Papers, vol. 63, no. 7, pp.
1023-1032, 2016.

SRAM Cell
HSRAM
6T SRAM
11T SRAM
13T SRAM
HSRAM
6T SRAM
11T SRAM
13T SRAM

SNM (mV)
Hold
183
182
182
182
Read
183
78
182
182

Variation (mV)
34
34
35
35
35
41
35
35

5. Conclusion
In this paper, a hierarchical FinFET SRAM cell (HSRAM)
has been proposed. In this design, each two 6T SRAM cells
share an additional five-transistor circuitry to improve design
complexity and power consumption, and achieve higher
SNM and execution speed in sub-threshold region. For
reading from these SRAM cells, each two cells are connected
to the shared read circuitry through a 2:1 multiplexer and
finally to the SRAM output. It is worth mentioning that by
connecting the read lines, the data stored in every cell does
not become faulty, and is not corrupted during the reading
procedure. The SRAM cells have been simulated using 10nm
LSTP FinFET HSPICE model. It was shown that the
proposed structure reduces the number of transistors, line
capacitance, power consumption and PDP as compared to its
counterpart cells.
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ﻋﻠﻮم و ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ
ﻧﺸﺮﻳﻪ ﻋﻠﻤﻲ ﭘﮋوﻫﺸﻲ اﻧﺠﻤﻦ ﻛﺎﻣﭙﻴﻮﺗﺮ اﻳﺮان
ﻣﺠﻠﺪ  ،13ﺷﻤﺎره 1394 ،2

ﻳﻚ ﺳﻠﻮل  SRAMﺳﻠﺴﻠﻪ ﻣﺮاﺗﺒﻲ ﻛﻢ ﺗﻮان ﻣﺒﺘﻨﻲ ﺑﺮ FinFET
1

ﺳﻤﻴﻪ ﻣﺎﺑﻲ

2

ﺳﻴﻨﺎ ﺳﻴﺎح اﻧﺴﺎن

3

ﻣﺤﻤﺪ ﺣﺴﻴﻦ ﻣﻌﻴﺮي

ﺷﺎﻫﻴﻦ ﺣﺴﺎﺑﻲ

2

1داﻧﺸﻜﺪه ﻋﻠﻮم و ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ ،داﻧﺸﮕﺎه ﺷﻬﻴﺪ ﺑﻬﺸﺘﻲ ،ﺗﻬﺮان ،اﻳﺮان
2داﻧﺸﻜﺪه ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ ،داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ ﺷﺮﻳﻒ ،ﺗﻬﺮان ،اﻳﺮان
3داﻧﺸﻜﺪه ﻣﻬﻨﺪﺳﻲ ﺑﺮق ،داﻧﺸﮕﺎه ﺷﻬﻴﺪ ﺑﻬﺸﺘﻲ ،ﺗﻬﺮان ،اﻳﺮان

ﭼﻜﻴﺪه
در اﻳﻦ ﻣﻘﺎﻟﻪ ،ﻃﺮاﺣﻲ ﻳﻚ ﺳﻠﻮل  SRAMﺳﻠﺴﻠﻪ ﻣﺮاﺗﺒﻲ ،ﻛﻪ ﻗﺎﺑﻠﻴﺖ ﻛﺎر در ﻧﺎﺣﻴﻪ زﻳﺮآﺳﺘﺎﻧﻪ را دارا ﻣﻲﺑﺎﺷﺪ ،اراﺋﻪ ﺷﺪه اﺳﺖ .روشﻫﺎي اراﺋﻪ ﺷﺪه ﺑـﺎ اﺳـﺘﻔﺎده
از ﻣﺪارﻫﺎي اﺿﺎﻓﻲ ،ﺣﺎﺷﻴﻪ ﻧﻮﻳﺰ اﻳﺴﺘﺎ را اﻓﺰاﻳﺶ ﻣﻲدﻫﻨﺪ ،در ﺣﺎﻟﻲ ﻛﻪ ﺑﺎ اﺷﺘﺮاكﮔﺬاري ﺑﻌﻀﻲ از ﻗﺴﻤﺖﻫﺎي ﻣﺪار ﺑﻴﻦ دو ﺳـﻠﻮل در ﺷـﻴﻮه ﺳﻠﺴـﻠﻪ ﻣﺮاﺗﺒـﻲ،
اﻓﺰوﻧﮕﻲ ﺳﺨﺖاﻓﺰاري را ﻣﺤﺪود ﻣﻲﻛﻨﻨﺪ .ﻧﺘﺎﻳﺞ ﺷﺒﻴﻪﺳﺎزي ﺳﻠﻮل  SRAMﻣﺒﺘﻨﻲ ﺑﺮ  FinFETﺑﺎ اﺳـﺘﻔﺎده از ﻧـﺮماﻓـﺰار  Synopsis H Spiceﺑـﺎ ﺗﻜﻨﻮﻟـﻮژي
 10nmﻧﺸﺎن ﻣﻲدﻫﺪ ﻛﻪ ﺳﻠﻮل اراﺋﻪ ﺷﺪه اﻧﺮژي ،ﺗﺎﺧﻴﺮ ﺧﻮاﻧﺪن و ﺗﺎﺧﻴﺮ ﻧﻮﺷﺘﻦ را ﺑﻪ ﻃﻮر ﻣﻴﺎﻧﮕﻴﻦ ﺑﻪ ﺗﺮﺗﻴﺐ  %2.37 ،%14.34و  %8.54ﻛﺎﻫﺶ ﻣـﻲدﻫـﺪ .ﺑـﻪ
ﻋﻼوه ،اﻳﻦ ﺳﻠﻮل ﺣﺎﺷﻴﻪ ﻧﻮﻳﺰ اﻳﺴﺘﺎي ﺧﻮاﻧﺪن را ﺣﺘﻲ در ﺣﻀﻮر ﺗﻐﻴﻴﺮات ﻓﺮاﻳﻨﺪ ﺑﻪ ﺷﺪت اﻓﺰاﻳﺶ ﻣﻲدﻫﺪ.

ﻛﻠﻤﺎت ﻛﻠﻴﺪي :ﺣﺎﻓﻈﻪ دﺳﺘﺮﺳﻲ ﺗﺼﺎدﻓﻲ اﻳﺴﺘﺎ ) ،(SRAMﻃﺮاﺣﻲ ﺑﺎ ﺗﻮان ﻣﺼﺮﻓﻲ ﻛﻢ ،ﺣﺎﺷﻴﻪ ﻧﻮﻳﺰ اﻳﺴﺘﺎ ،ﺣﺎﻓﻈﻪ ﺳﻠﺴﻠﻪ ﻣﺮاﺗﺒﻲ.
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ﺗﺎﺛﻴﺮ ﻧﻤﺎﻳﺶ اﻓﺰون ﺑﺮ ﭘﻴﻤﺎﻧﻪ ﻣﺎﻧﺪهﻫﺎ روي ﺟﻤﻊ ﭘﻴﺸﻮﻧﺪﻣﻮازي ﺑﻪ ﭘﻴﻤﺎﻧﻪ 2n-5
ﺣﺴﻦ ﻗﺎﺳﻤﻲ ﻣﻄﻠﻖ

ﻗﺎﺳﻢ ﺟﺎﺑﺮيﭘﻮر

داﻧﺸﻜﺪه ﻋﻠﻮم و ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ ،داﻧﺸﮕﺎه ﺷﻬﻴﺪ ﺑﻬﺸﺘﻲ ،ﺗﻬﺮان ،اﻳﺮان

ﭼﻜﻴﺪه
در ﺳﻴﺴﺘﻢ اﻋﺪاد ﻣﺎﻧﺪهاي ﺑﻪ دﺳﺖ آوردن ﻛﺎﻧﺎلﻫﺎي ﻣﺤﺎﺳﺒﺎﺗﻲ ﻛﻪ ﺗﺎﺧﻴﺮ ﻣﺘﻌﺎدل داﺷﺘﻪ ﺑﺎﺷﻨﺪ ،ﺑﺴﻴﺎر ﻣﻄﻠﻮب اﺳﺖ .در ﺣﺎﻟﺖ ﺧﺎص ﻣﻲﺗﻮان ﺑﻪ ﺟﻤﻊﻛﻨﻨﺪه ﺑﻪ
ﭘﻴﻤﺎﻧﻪ ) (2n -ﺑﺎ ﻣﻘﺎدﻳﺮ اﻧﺘﺨﺎﺑﻲ ) ﺑﺼﻮرت } ({1, 3, 5اﺷﺎره ﻛﺮد .از آن ﺟﻤﻠﻪ ﺟﻤﻊﻛﻨﻨﺪه ﺑﻪ ﭘﻴﻤﺎﻧﻪ ) (2n-1ﺗﻨﻬﺎ ﺑﺎ ﻳﻚ ﺟﻤﻊﻛﻨﻨﺪه ﻣﻜﻤﻞ ﻳـﻚ ﺳـﺎﺧﺘﻪ
ﻣﻲﺷﻮد ﻛﻪ در آن ﺧﺮوﺟﻲ ﺑﺮاﺑﺮ ﺑﺎ ﭘﻴﻤﺎﻧﻪ ﺑﻌﻨﻮان ﻧﻤـﺎﻳﺶ دوم ﺻـﻔﺮ ﻣﺤﺴـﻮب ﻣـﻲﮔـﺮدد .ﺟﻤـﻊﻛﻨﻨـﺪه ﭘﻴﺸـﻮﻧﺪ ﻣـﻮازي ﺳـﺮﻳﻊ ﺑـﺮاي اﻳـﻦ ﺣﺎﻟـﺖ ﺑـﺎ ﺗـﺎﺧﻴﺮ
 (3+2[log n]) Gوﺟﻮد دارد ﻛﻪ  Gﺗﺎﺧﻴﺮ ﻳـﻚ ﮔﻴـﺖ دو ورودي ﺳـﺎده را ﻣﺸـﺨﺺ ﻣـﻲﻛﻨـﺪ .ﺑﻄـﻮر ﻣﺸـﺎﺑﻪ ،ﺟﻤـﻊﻛﻨﻨـﺪه ﺑـﻪ ﭘﻴﻤﺎﻧـﻪ ) (2n-3ﺑـﺎ ﺗـﺎﺧﻴﺮ
 (4+2[log n]) Gﭘﻴﺸﻨﻬﺎد ﺷﺪه اﺳﺖ ﻛﻪ در آن ﻣﺎﻧﺪهﻫﺎي } {0, 1, 2دو ﻧﻤﺎﻳﺶ دارﻧﺪ .وﻟﻲ دو ﻧﻤﺎﻳﺸﻲ ﺑﻮدن اﻳـﻦ ﻣﺎﻧـﺪهﻫـﺎ ﻋﻤـﻞ ﺑﻌـﺪي  RNSرا ﺧـﺮاب
ﻧﻤﻲﻛﻨﺪ .ﺑﺮاي رﺳﻴﺪن ﺑﻪ داﻣﻨﻪ ﭘﻮﻳﺎ ﮔﺴﺘﺮدهﺗﺮ ،و در ﻋﻴﻦ ﺣﺎل ﺣﻔﻆ ﻋﺮض ﻛﺎﻧﺎل )ﺑﻪ ﻋﻨﻮان ﻣﺜﺎل  (nدر ﻛﻤﺘﺮﻳﻦ ﻣﻘﺪار ﻣﻤﻜﻦ ،ﺟﻤﻊﻛﻨﻨﺪه ﺳـﺮﻳﻊ ﺑـﻪ ﭘﻴﻤﺎﻧـﻪ
) ،(2n-5ﻣﻲﺗﻮاﻧﺪ ﻛﺎﻣﻼ ﻣﻔﻴﺪ ﺑﺎﺷﺪ .اﻳﻦ ﻣﻮﺿﻮع اﻧﮕﻴﺰهاي ﺷﺪ ﺗﺎ ﺑﻪ ﻃﺮاﺣﻲ و ﭘﻴﺎدهﺳﺎزي ﭼﻨﻴﻦ ﺟﻤﻊﻛﻨﻨـﺪهﻫـﺎﻳﻲ ﺑـﺎ ﻫـﺪف ﺑـﻪ دﺳـﺖ آوردن ﺗـﺎﺧﻴﺮ ﺑﺮاﺑـﺮ ﺑـﺎ
 (4+2[log n]) Gﺑﭙﺮدازﻳﻢ .اﮔﺮ ﭼﻪ ﻃﺮح ﭘﻴﺸﻨﻬﺎدي ﺑﺎ ﺟﻤﻊﻛﻨﻨﺪه ﺑﻪ ﭘﻴﻤﺎﻧﻪ ) (2n-3ﻛﻪ ﻗﺒﻼً ذﻛﺮ ﺷﺪ ،اﺳﺎﺳﺎً ﻳﻜﺴﺎن ﻣﻲﺑﺎﺷﺪ ،وﻟﻲ در ﻋﻴﻦ ﺣﺎل ﭼﺎﻟﺶﻫـﺎي
ﺧﺎص ﺑﺴﻴﺎري وﺟﻮد دارد ﻛﻪ ﺑﺎﻳﺪ ﺑﺮ آنﻫﺎ ﻏﻠﺒﻪ ﻛﺮد .ﻧﺘﺎﻳﺞ آﻧﺎﻟﻴﺰﻫﺎي ﺑﻪ دﺳﺖ آﻣﺪه از اﻧﺪازهﮔﻴﺮيﻫﺎي ﺗﺎﺧﻴﺮ و ﻣﺴﺎﺣﺖ در ﻃﺮح ﭘﻴﺸـﻨﻬﺎدي از ﻃﺮﻳـﻖ ﺳـﻨﺘﺰ
ﻣﺪار ﻛﻪ ﺑﺎ ﻧﺮماﻓﺰار  Design Compilerﺑﺮاي ﺷﺮﻛﺖ  Synopsisﺷﺒﻴﻪﺳﺎزي ﺷﺪه ﻧﻴﺰ ﻣﻮرد ﺗﺎﻳﻴﺪ ﻗﺮار ﮔﺮﻓﺘﻪ اﺳﺖ.
ﻛﻠﻤﺎت ﻛﻠﻴﺪي :ﺟﻤﻊﻛﻨﻨﺪه ﺑﻪ ﭘﻴﻤﺎﻧﻪ  ،2n-5ﻧﻤﺎﻳﺶ اﻓﺰون ﺑﺮ ﭘﻴﻤﺎﻧﻪ ،ﺟﻤﻊﻛﻨﻨﺪهﻫﺎي ﭘﻴﻤﺎﻧﻪاي ﭘﻴﺸﻮﻧﺪﻣﻮازي ،ﭘﺮدازش ﻋﻼﺋﻢ رﻗﻤﻲ.
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اراﺋﻪ روﺷﻲ ﻣﺒﺘﻨﻲ ﺑﺮ ﻳﺎدﮔﻴﺮي ﻋﻤﻴﻖ ﺑﺮاي ﺗﺨﻤﻴﻦ ﺟﻬﺖ ﻧﮕﺎه اﻧﺴﺎن ﺑﺎ اﺳﺘﻔﺎده از
اﻃﻼﻋﺎت ﭼﺸﻢ و ﺟﻬﺖ ﺳﺮ
رﺣﻴﻢ اﻧﺘﻈﺎري

ﻣﺤﻤﻮد ﻓﺘﺤﻲ

ﻣﺤﻤﺪ ﻣﻬﺪي ارزﻧﻲ

اﻣﻴﺮﺣﺴﻴﻦ ﺑﻴﺎت

داﻧﺸﻜﺪه ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ ،داﻧﺸﮕﺎه ﻋﻠﻢ و ﺻﻨﻌﺖ اﻳﺮان ،ﺗﻬﺮان ،اﻳﺮان

ﭼﻜﻴﺪه
اﻣﺮوزه ﺗﻮﺳﻌﻪ ﺳﺎﻣﺎﻧﻪﻫﺎﻳﻲ ﻛﻪ ﺗﻮاﻧﺎﻳﻲ ﺗﺤﻠﻴﻞ ﺣﺎﻻت اﻧﺴﺎن را دارﻧﺪ از اﻫﻤﻴﺖ وﻳﮋهاي ﺑﺮﺧﻮردار ﻫﺴﺘﻨﺪ .ﺑﻪﻃﻮر ﺧﺎص ،ﺟﻬﺖ ﻧﮕﺎه اﻧﺴﺎن ﻧﻘـﺶ ﻣﻬﻤـﻲ در ﺑﻴـﺎن
ﺧﻮاﺳﺘﻪﻫﺎي ﻓﺮد ،ﻧﻴﺎزﻫﺎ ،ﻓﺮآﻳﻨﺪﻫﺎي ﺷﻨﺎﺧﺘﻲ ،ﺣﺎﻻت اﺣﺴﺎﺳﻲ و ﻋﺎﻃﻔﻲ و ارﺗﺒﺎﻃﺎت ﺑﻴﻦ اﻓﺮاد اﻳﻔﺎ ﻣﻲﻛﻨﺪ .ﺗﺨﻤـﻴﻦ ﺟﻬـﺖ ﻧﮕـﺎه اﻧﺴـﺎن ﻛﺎرﺑﺮدﻫـﺎي ﻓﺮاواﻧـﻲ
ازﺟﻤﻠﻪ ﺗﺤﻠﻴﻞ ﺗﻮﺟﻪ ،راﺑﻂﻫﺎي ﻛﺎرﺑﺮي ﻣﺒﺘﻨﻲ ﺑﺮ ﭼﺸﻢ و ﺗﺸﺨﻴﺺ ﻓﻌﺎﻟﻴﺖﻫﺎي اﻧﺴﺎن دارد .ﻋﻠﻴﺮﻏﻢ ﭘﻴﺸﺮﻓﺖﻫﺎي اﺧﻴﺮ در اﻳـﻦ زﻣﻴﻨـﻪ ،ﺑﺴـﻴﺎري از روشﻫـﺎي
ﻛﻨﻮﻧﻲ ﻧﻤﻲﺗﻮاﻧﻨﺪ ﺷﺮاﻳﻂ ﻣﺨﺘﻠﻔﻲ ﻫﻤﭽﻮن ﺣﺮﻛﺖ ﺳﺮ را ﺑﻪﺧﻮﺑﻲ ﻣﺪل ﻛﻨﻨﺪ .اﺧﻴﺮاً ﻣﻘﺎﻻﺗﻲ ﺑﺮاي ﺣﻞ اﻳﻦ ﻣﺸﻜﻞ اراﺋﻪ ﺷﺪهاﻧـﺪ اﻣـﺎ دﻗـﺖ ﺧـﻮﺑﻲ را ﺑـﻪ دﺳـﺖ
ﻧﺪادهاﻧﺪ .در اﻳﻦ ﻣﻘﺎﻟﻪ ،از روﺷﻲ ﻣﺒﺘﻨﻲ ﺑﺮ ﺷﺒﻜﻪﻫﺎي ﻋﺼﺒﻲ ﻋﻤﻴﻖ ﺑﺮاي ﺗﺤﻠﻴﻞ وﻳﮋﮔﻲﻫﺎي ﻇﺎﻫﺮي اﺳﺘﻔﺎده ﺷﺪه اﺳﺖ ﻛﻪ از اﻃﻼﻋﺎت ﺟﻬـﺖ ﺳـﺮ اﻧﺴـﺎن ﻧﻴـﺰ
ﺑﻬﺮه ﻣﻲﺑﺮد .روش ﻣﺬﻛﻮر ﺑﻪ ﻫﻤﺮاه ﺗﻨﻈﻴﻤﺎت اﺳﺘﻔﺎده ﺷﺪه ﺑﻪﻃﻮر ﭼﺸﻤﮕﻴﺮي دﻗﺖ را ﺑﻬﺒﻮد داده اﺳﺖ.
ﻛﻠﻤﺎت ﻛﻠﻴﺪي :ﺗﺨﻤﻴﻦ ﺟﻬﺖ ﻧﮕﺎه ،ﺗﺤﻠﻴﻞ ﺗﻮﺟﻪ ،ﺟﻬﺖ ﺳﺮ اﻧﺴﺎن ،ﺷﺒﻜﻪﻫﺎي ﻋﺼﺒﻲ ﻋﻤﻴﻖ.
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ﺑﺮرﺳﻲ اﻳﺠﺎد ﻗﺎﺑﻠﻴﺖ ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي در ﺟﻤﻊﻛﻨﻨﺪهﻫﺎي دﻫﺪﻫﻲ
ﻣﻬﺪي ﺻﺪﻳﻘﻲ

ﺳﻤﺎﻧﻪ اﻣﺎﻣﻲ

داﻧﺸﻜﺪه ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ و ﻓﻨﺎوري اﻃﻼﻋﺎت ،داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ اﻣﻴﺮﻛﺒﻴﺮ ،ﺗﻬﺮان ،اﻳﺮان

ﭼﻜﻴﺪه
در ﺳﺎلﻫﺎي اﺧﻴﺮ ﺣﺴﺎب دﻫﺪﻫﻲ ﺑﻪ ﻣﻮﺿﻮع داﻏﻲ در ﺗﺤﻘﻴﻘﺎت ﺗﺒﺪﻳﻞ ﺷﺪه اﺳﺖ .واﺣﺪﻫﺎي ﺳﺨﺖاﻓﺰاري زﻳﺎدي ﺑﺮاي اﻧﺠﺎم ﻋﻤﻠﻴﺎت ﺣﺴﺎب دﻫﺪﻫﻲ ﻛﺎرا و
دﻗﻴﻖ ،ﻃﺮاﺣﻲ و ﭘﻴﺸﻨﻬﺎد ﺷﺪهاﻧﺪ .ﺑﻪ ﻃﻮر ﻣﻌﻤﻮل ،واﺣﺪﻫﺎي ﺣﺴﺎب دﻫﺪﻫﻲ ﺑﻪ ﺻﻮرت ﻣﺎژولﻫﺎي ﺳﺨﺖاﻓﺰاري ﺧﺎصﻣﻨﻈﻮره ﺑﺮاي ﻳﻚ ﻛﺎرﺑﺮد ﻣﺸﺨﺺ
ﻃﺮاﺣﻲ ﻣﻲﺷﺪﻧﺪ .اﻣﺎ اﻣﺮوزه ﮔﺮاﻳﺶ ﺑﻪ ﺳﻤﺖ ﻃﺮاﺣﻲ و ﭘﻴﺎدهﺳﺎزي ﺳﺎﺧﺘﺎرﻫﺎي ﻗﺎﺑﻞ ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي ﺑﺮاي اﻧﺠﺎم ﺣﺴﺎب دﻫﺪﻫﻲ اﻓﺰاﻳﺶ ﻳﺎﻓﺘﻪ اﺳﺖ .اﻳﻦ ﻣﻘﺎﻟﻪ ،ﺑﺎ
ﺑﺮرﺳﻲ اﻧﺘﺨﺎبﻫﺎي ﻣﺨﺘﻠﻒ ﻗﺎﺑﻠﻴﺖ ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي در ﺟﻤﻊﻛﻨﻨﺪهﻫﺎي دﻫﺪﻫﻲ ،ﺑﺎ اﻳﻦ ﺟﺮﻳﺎن ﻫﻤﺮاه ﻣﻲﺷﻮد و درﺧﺖﻫﺎي ﭘﻴﺸﻮﻧﺪي ﻣﻮازي ﺟﺪﻳﺪي ﺑﺎ ﻗﺎﺑﻠﻴﺖ
ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي ﭘﻴﺸﻨﻬﺎد ﻛﺮده و ﻳﻚ ﺟﻤﻊﻛﻨﻨﺪهي ﺗﺮﻛﻴﺒﻲ دودوﻳﻲ/دﻫﺪﻫﻲ ﻗﺎﺑﻞ ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي ﺑﺮاي وروديﻫﺎي ﺑﺎ اﻧﺪازهي ﻣﺨﺘﻠﻒ اراﺋﻪ ﻣﻲﻛﻨﺪ .ﺗﺤﻠﻴﻞﻫﺎ ﻧﺸﺎن
ﻣﻲدﻫﺪ ﻛﻪ ﺑﺎ ﺗﺤﻤﻞ ﻳﻚ ﻫﺰﻳﻨﻪي ﺳﺮﺑﺎر ﻗﺎﺑﻞ ﻗﺒﻮل ﻣﻲﺗﻮان دو درﺧﺖ ﭘﻴﺸﻮﻧﺪي ﻣﻮازي راﻳﺞ را ﺗﺮﻛﻴﺐ ﻛﺮده و ﻳﻚ درﺧﺖ ﻗﺎﺑﻞ ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي ﺑﻪ دﺳﺖ آورد .ﺑﻪ
ﻋﻼوه ،دو ﻣﻌﻴﺎر ﻣﺘﻔﺎوت ﺑﺮاي اﻧﺘﺨﺎب درﺧﺖﻫﺎي ﭘﻴﺸﻮﻧﺪي ﭘﺎﻳﻪ ﭘﻴﺸﻨﻬﺎد ﺷﺪه و ﺑﺎ ﻳﻜﺪﻳﮕﺮ ﻣﻘﺎﻳﺴﻪ ﺧﻮاﻫﻨﺪ ﺷﺪ .ﻧﺘﺎﻳﺞ ﺗﺠﺮﺑﻲ ﻧﺸﺎن ﻣﻲدﻫﺪ ﻛﻪ اﻓﺰودن ﻗﺎﺑﻠﻴﺖ
ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي در ﻃﺮاﺣﻲﻫﺎي ﭘﻴﺸﻨﻬﺎد ﺷﺪه ،ﺑﻪ ﺣﺪاﻛﺜﺮ  5%ﺳﺮﺑﺎر ﻣﺴﺎﺣﺖ ﻣﻨﺠﺮ ﺧﻮاﻫﺪ ﺷﺪ.
ﻛﻠﻤﺎت ﻛﻠﻴﺪي :ﺣﺴﺎب دﻫﺪﻫﻲ ،درﺧﺖ ﭘﻴﺸﻮﻧﺪي ﻣﻮازي ،ﺟﻤﻊﻛﻨﻨﺪه دﻫﺪﻫﻲ ،ﺳﺨﺖاﻓﺰار ﻗﺎﺑﻞ ﺑﺎزﭘﻴﻜﺮﺑﻨﺪي ،رﻳﺰداﻧﮕﻲ.
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ﻃﺒﻘﻪﺑﻨﺪي و ﻣﺮور روشﻫﺎي ﺧﺮاﺑﻲﻳﺎﺑﻲ ﺗﻮزﻳﻌﻲ در ﺷﺒﻜﻪﻫﺎي ﻣﺘﺸﻜﻞ از ﮔﺮهﻫﺎي
ﻫﻮﺷﻤﻨﺪ
ﺑﻬﺮوز ﭘﺮﻫﺎﻣﻲ

ﻧﺎن وو

ﺳﻴﺰﻳﻦ ﺗﺎﺋﻮ

داﻧﺸﻜﺪه ﻣﻬﻨﺪﺳﻲ ﺑﺮق و ﻛﺎﻣﭙﻴﻮﺗﺮ ،داﻧﺸﮕﺎه ﻛﺎﻟﻴﻔﺮﻧﻴﺎ ،ﺳﺎﻧﺘﺎﺑﺎرﺑﺎرا ،اﻣﺮﻳﻜﺎ

ﭼﻜﻴﺪه
رﺷﺘﻪي ﺧﺮاﺑﻲﻳﺎﺑﻲ در ﺳﻄﺢ ﺳﻴﺴﺘﻢ از زﻣﺎن ﭘﻴﺪاﻳﺸﺶ در ﭘﻨﺠﺎه ﺳﺎل ﭘﻴﺶ ﮔﺴﺘﺮش ﭼﺸﻤﮕﻴﺮي داﺷﺘﻪ و ﻫﻨﻮز ﻫﻢ از ﺗﺨﺼﺺﻫﺎي ﭘﮋوﻫﺸﻲ ﻓﻌـﺎل در ﻫـﺮ دو
زﻣﻴﻨﻪي ﭘﺮدازش ﻣﻮازي و ﺳﻴﺴﺘﻢﻫﺎي اﻋﺘﻤﺎدﭘﺬﻳﺮ اﺳﺖ .ﺑﺨﺶ ﭼﺸﻤﮕﻴﺮي از ﻧﺘﺎﻳﺞ ﺳﺎلﻫﺎي اﺧﻴﺮ در اﻳﻦ رﺷﺘﻪ از ﺳﻮي ﭘﮋوﻫﺸﮕﺮان ﻛﺸﻮرﻫﺎي ﭼﻴﻦ و ﺗـﺎﻳﻮان
ﻋﺮﺿﻪ ﺷﺪهاﻧﺪ .در اﻳﻦ ﻣﻘﺎﻟﻪ رﺷﺘﻪي ﭘﮋوﻫﺸﻲ ﺧﺮاﺑﻲﻳﺎﺑﻲ ﺗﻮزﻳﻊ ﻳﺎ ﻧﺎﻣﺘﻤﺮﻛﺰ از راه اراﺋﻪ ﻳﻚ ﻃﺒﻘﻪﺑﻨﺪي ﻓﺮاﮔﻴﺮ ،ﻛـﻪ ﻫـﻢ ﺗﻤـﺎم ﻓﻌﺎﻟﻴـﺖﻫـﺎي ﮔﺬﺷـﺘﻪ را در ﺑـﺮ
ﻣﻲﮔﻴﺮد و ﻫﻢ زﻣﻴﻨﻪﻫﺎي ﺗﺎزه را ﺑﺮاي ﭘﻴﮕﻴﺮي ﺑﻪ ﻣﺎ ﻣﻲﻧﻤﺎﻳﺎﻧﺪ ،ﺳﺎزﻣﺎﻧﺪﻫﻲ ﻣﻲﺷﻮد .ﭘﻴﺸﻨﻬﺎد واژﮔﺎﻧﻲ ﻳﻜﺪﺳﺖ و روﺷﻦ ﺑﺮاي وﻳﮋﮔﻲﻫﺎ و رواﺑـﻂ ﻣﻬـﻢ ﻳﻜـﻲ از
دﺳﺘﺎوردﻫﺎي اﻳﻦ ﻃﺒﻘﻪﺑﻨﺪي اﺳﺖ .ﻣﻘﺎﻟﻪ ﺑﺮاي ﻣﺘﺨﺼﺼﺎن ﻛﺎﻣﭙﻴﻮﺗﺮ ﻛﻪ ﻗﺒﻼ در اﻳﻦ رﺷﺘﻪ ﻛﺎر ﻧﻜـﺮدهاﻧـﺪ ﻫـﻢ ﻗﺎﺑـﻞ اﺳـﺘﻔﺎده اﺳـﺖ ،ﭼـﺮا ﻛـﻪ ﻣﻔـﺎﻫﻴﻢ ﺗـﺎزه و
ﭼﺎﻟﺶﻫﺎي ﭘﮋوﻫﺸﻲ را از راه ﺗﻤﺜﻴﻞ ﺑﻪ زﺑﺎن ﺳﺎده اراﺋﻪ ﻣﻲﻛﻨﺪ.
ﻛﻠﻤﺎت ﻛﻠﻴﺪي :ﺧﺮاﺑﻲﻳﺎﺑﻲ ﻗﻴﺎﺳﻲ ،ﺳﻴﺴﺘﻢ ﺗﻮزﻳﻌﻲ ،ﺗﺤﻤﻞﭘﺬﻳﺮي ﺧﺮاﺑﻲ ،ﺷﺒﻜﻪ ﻣﻴﺎن ارﺗﺒﺎﻃﻲ ،ﻣﺪل * ،MMﭘﺮدازش ﻣـﻮازي ،ﻣـﺪل  ،PMCﺧﺮاﺑـﻲﻳـﺎﺑﻲ در
ﺳﻄﺢ ﺳﻴﺴﺘﻢ.

2

ﻋﻠﻮم و ﻣﻬﻨﺪﺳﻲ ﻛﺎﻣﭙﻴﻮﺗﺮ
ﻧﺸﺮﻳﻪ ﻋﻠﻤﻲ ﭘﮋوﻫﺸﻲ اﻧﺠﻤﻦ ﻛﺎﻣﭙﻴﻮﺗﺮ اﻳﺮان
ﻣﺠﻠﺪ  ،13ﺷﻤﺎره 1394 ،2

ﻳﻚ اﻟﮕﻮرﻳﺘﻢ زﻣﺎنﺑﻨﺪي ﺑﻲدرﻧﮓ اﻧﺮژي -ﺑﻬﻴﻨﻪ ﺑﺮاي ﻣﺎﺷﻴﻦﻫﺎي ﻣﻮازي ﻧﺎﻣﺘﺠﺎﻧﺲ ﺑﺎ
ﻗﺎﺑﻠﻴﺖ DVS
1

ﻣﺤﻤﻮد ﻗﻠﻲﭘﻮر

1و2

ﻣﻬﺪي ﻛﺎرﮔﻬﻲ

1

ﻫﺸﺎم ﻓﻴﻠﻲ

3

ﺷﻬﺒﺎز ﻳﻮﺳﻔﻲ

ﻫﺎدي رواﻧﺒﺨﺶ

1

1داﻧﺸﻜﺪه ﻣﻬﻨﺪﺳﻲ ﺑﺮق و ﻛﺎﻣﭙﻴﻮﺗﺮ ،داﻧﺸﮕﺎه ﺗﻬﺮان ،ﺗﻬﺮان ،اﻳﺮان
2ﭘﮋوﻫﺸﻜﺪه ﻋﻠﻮم ﻛﺎﻣﭙﻴﻮﺗﺮ ،ﭘﮋوﻫﺸﮕﺎه داﻧﺶﻫﺎي ﺑﻨﻴﺎدي ) ،(IPMﺗﻬﺮان ،اﻳﺮان
3داﻧﺸﻜﺪه اﻧﻔﻮرﻣﺎﺗﻴﻚ ،ﻣﻬﻨﺪﺳﻲ ﭘﺰﺷﻜﻲ ،رﺑﺎﺗﻴﻚ و ﻣﻬﻨﺪﺳﻲ ﺳﻴﺴﺘﻢ ،داﻧﺸﮕﺎه ﺟﻨﻮا ،اﻳﺘﺎﻟﻴﺎ

ﭼﻜﻴﺪه
ﻣﺎﺷﻴﻦﻫﺎي ﻣﻮازي ﻧﺎﻣﺘﺠﺎﻧﺲ از واﻗﻌﻲﺗﺮﻳﻦ ﻣﺪلﻫﺎي ﺳﻴﺴﺘﻢﻫﺎي ﭼﻨﺪﭘﺮدازﻧﺪهاي ﻏﻴﺮﻫﻤﮕﻦ ﻣﺤﺴﻮب ﻣﻲﺷﻮﻧﺪ .در اﻳﻦ ﻣﺪل ،زوج وﻇﻴﻔﻪ -ﻣﺎﺷﻴﻦ زﻣﺎن اﺟﺮا و
اﻧﺮژي ﻣﺼﺮﻓﻲ ﻣﻮرد ﻧﻴﺎز ﺑﺮاي اﺟﺮاي ﻳﻚ وﻇﻴﻔﻪ را ﻣﺸﺨﺺ ﻣﻲﻧﻤﺎﻳﺪ .اﻳﻦ ﻣﻘﺎﻟﻪ ﺑﻪ اراﺋﻪ ﻳﻚ اﻟﮕﻮرﻳﺘﻢ زﻣﺎنﺑﻨﺪي ﺑﺮ روي ﭼﻨﻴﻦ ﺑﺴﺘﺮي ﺑﺎ ﭘﺮدازﻧﺪهﻫـﺎي داراي
ﻗﺎﺑﻠﻴﺖ  DVSاﺳﺖ .ﻳﻚ اﻟﮕﻮرﻳﺘﻢ ﺑﻬﻴﻨﻪ ﺑﺎ زﻣﺎن ﭼﻨﺪﺟﻤﻠﻪاي ﺑﻪ ﻧﺎم  EORTSAاراﺋﻪ ﺷﺪه اﺳﺖ ﻛﻪ در اﺑﺘﺪا ﻳﻚ ﺗﺨﺼﻴﺺ اﻧﺮژي -ﺑﻬﻴﻨﻪ وﻇﻴﻔﻪ -ﺑﻪ -ﻣﺎﺷﻴﻦ و
وﻟﺘﺎژ -ﺑﻪ -وﻇﻴﻔﻪ را در ﻗﺎﻟﺐ ﻳﻚ ﺑﺮﻧﺎﻣﻪرﻳﺰي ﺧﻄﻲ اﻧﺠﺎم ﻣﻲدﻫﺪ .از ﺧﺮوﺟﻲ اﻳﻦ ﻣﺮﺣﻠﻪ ﺑﻪ ﻋﻨﻮان آزﻣﻮن زﻣﺎنﺑﻨﺪيﭘﺬﻳﺮي وﻇﺎﻳﻒ دورهاي اﺳﺘﻔﺎده ﻣـﻲﮔـﺮدد.
ﺳﭙﺲ وﻇﺎﻳﻔﻲ ﻛﻪ اﻳﻦ آزﻣﻮن را ﺑﺎ ﻣﻮﻓﻘﻴﺖ ﭘﺸﺖ ﺳﺮ ﺑﮕﺬارﻧﺪ ﺗﻮﺳﻂ ﻳﻚ اﻟﮕﻮرﻳﺘﻢ ﺗﻄﺎﺑﻖ زﻣﺎنﺑﻨﺪي ﻣﻲﺷﻮﻧﺪ .در اﻳﻦ راﺳﺘﺎ ﺗﻌﺪاد ﺣـﺪﻛﺜﺮ ﻣﻬـﺎﺟﺮت ،ﺣـﺪاﻛﺜﺮ
اﻧﻘﻄﺎع وﻇﻴﻔﻪ ،و ﺣﺪاﻛﺜﺮ ﺗﻌﺪاد ﺗﻐﻴﻴﺮ ﺳﻄﺢ وﻟﺘﺎژ ﻣﻮرد ﺑﺤﺚ ﻗﺮار ﮔﺮﻓﺘﻪ و ﺑﻪ ﻋﻨﻮان ﺗﺎﺑﻌﻲ از ﺗﻌﺪاد ﻣﺎﺷﻴﻦﻫﺎ اﺳﺘﺨﺮاج ﻣﻲﮔﺮدﻧﺪ .ﻣﻘﺎﻳﺴﻪ ﺑﺎ اﻟﮕـﻮرﻳﺘﻢ  PCGﺗـﺎ
 %60ﺑﻬﺒﻮد در اﻧﺮژي ﻣﺼﺮﻓﻲ را ﮔﺰارش ﻣﻲﻧﻤﺎﻳﺪ.
ﻛﻠﻤﺎت ﻛﻠﻴﺪي :ﻣﻘﻴﺎسﭘﺬﻳﺮي ﭘﻮﻳﺎي وﻟﺘﺎژ ،ﺑﻬﻴﻨﻪﺳﺎزي اﻧﺮژي ،ﻣﻬﺎﺟﺮت ،ﺳﻴﺴﺘﻢﻫﺎي ﺑﻲدرﻧﮓ ،زﻣﺎنﺑﻨﺪي ،ﻣﺎﺷﻴﻦﻫﺎي ﻣﻮازي ﻧﺎﻣﺘﺠﺎﻧﺲ.
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ﺻﺎﺣﺐ اﻣﺘﻴﺎز :اﻧﺠﻤﻦ ﻛﺎﻣﭙﻴﻮﺗﺮ اﻳﺮان
ﻣﺪﻳﺮ ﻣﺴﺌﻮل :دﻛﺘﺮ ﺟﻌﻔﺮ ﺣﺒﻴﺒﻲ
ﺳﺮدﺑﻴﺮ :دﻛﺘﺮ ﺣﻤﻴﺪ ﺳﺮﺑﺎزيآزاد

ﺷﻮراي ﻋﻠﻤﻲ
گ .آﻗﺎ ،اﺳﺘﺎد داﻧﺸﮕﺎه اﻳﻠﻴﻨﻮﻳﺰ ،اﻣﺮﻳﻜﺎ
ف .ارﺑﺎب ،اﺳﺘﺎد ﺳﻲ.دﺑﻠﻴﻮ.آي و داﻧﺸﮕﺎه ﻻﻳﺪن ،ﻫﻠﻨﺪ
ن .ﺑﺎﻗﺮزاده ،اﺳﺘﺎد داﻧﺸﮕﺎه ﻛﺎﻟﻴﻔﺮﻧﻴﺎ -اﻳﺮوﻳﻦ ،اﻣﺮﻳﻜﺎ
ك .ﺑﺪﻳﻊ ،داﻧﺸﻴﺎر ﻣﺮﻛﺰ ﺗﺤﻘﻴﻘﺎت ﻣﺨﺎﺑﺮات ،اﻳﺮان
ب .ﺑﻮزه ،اﺳﺘﺎد داﻧﺸﮕﺎه اﻳﺎﻟﺘﻲ اورﮔﺎن ،اﻣﺮﻳﻜﺎ
ب .ﭘﺮﻫﺎﻣﻲ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﻛﺎﻟﻴﻔﺮﻧﻴﺎ -ﺳﻨﺘﺎﺑﺎرﺑﺎرا ،اﻣﺮﻳﻜﺎ
ف .ﺟﻬﺎﻧﻴﺎن ،اﺳﺘﺎد داﻧﺸﮕﺎه ﻣﻴﺸﻴﮕﺎن ،اﻣﺮﻳﻜﺎ
آ .زوﻣﺎﻳﺎ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺳﻴﺪﻧﻲ ،اﺳﺘﺮاﻟﻴﺎ
ح .ﺳﺮﺑﺎزيآزاد ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ ﺷﺮﻳﻒ ،اﻳﺮان
ب .ﺷﻴﺮازي ،اﺳﺘﺎد داﻧﺸﮕﺎه اﻳﺎﻟﺘﻲ واﺷﻨﮕﺘﻦ ،اﻣﺮﻳﻜﺎ
ا .ﻛﺒﻴﺮ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺗﺮﺑﻴﺖ ﻣﺪرس ،اﻳﺮان
ر .ﺻﻔﺎﺑﺨﺶ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ اﻣﻴﺮﻛﺒﻴﺮ ،اﻳﺮان
ح .ر .ﻋﺮبﻧﻴﺎ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺟﻮرﺟﻴﺎ ،اﻣﺮﻳﻜﺎ
ع .ﻋﺪاﻟﺖ ،اﺳﺘﺎد ﻛﺎﻟﺞ ﺳﻠﻄﻨﺘﻲ ﻟﻨﺪن ،اﻧﮕﻠﺴﺘﺎن
م .ﻓﺘﺤﻲ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﻋﻠﻢ و ﺻﻨﻌﺖ ،اﻳﺮان
م .ح .ﻗﺎﺳﻤﻴﺎن ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺗﺮﺑﻴﺖ ﻣﺪرس ،اﻳﺮان
م .ﻗﺪﺳﻲ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ ﺷﺮﻳﻒ ،اﻳﺮان
ع .ﻫﻮرﺳﺎن ،اﺳﺘﺎد داﻧﺸﮕﺎه اﻳﺎﻟﺘﻲ ﭘﻨﺴﻴﻠﻮاﻧﻴﺎ ،اﻣﺮﻳﻜﺎ
ف .ﻟﻮ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﻫﻨﮓ ﻛﻨﮓ ،ﭼﻴﻦ
ع .ﻣﻮﻗﺮ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ ﺷﺮﻳﻒ ،اﻳﺮان
ن .ﻣﻬﺪوياﻣﻴﺮي ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ ﺷﺮﻳﻒ ،اﻳﺮان
م .ر .ﻣﻴﺒﺪي ،اﺳﺘﺎد داﻧﺸﮕﺎه ﺻﻨﻌﺘﻲ اﻣﻴﺮﻛﺒﻴﺮ ،اﻳﺮان
ك .ﻧﺎﻛﺎﻧﻮ ،اﺳﺘﺎد داﻧﺸﮕﺎه ﻫﻴﺮوﺷﻴﻤﺎ ،ژاﭘﻦ
م .وﻟﺪﺧﻮا ،اﺳﺘﺎد داﻧﺸﮕﺎه ﮔﻼﺳﮕﻮ ،اﻧﮕﻠﺴﺘﺎن
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